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1
Problem Solving

1.1. Objectives

1. Be ableto define problem solving.

2. Be able to describe the common problem-solving methods.

3. Be ableto select the appropriate method for solving a problem.
4. Understand the function and use of spreadsheets.

5. Understand the use of and common symbols for flow charts.

1.2. Introduction

Problem solving is a part of living. We are faced with a host of problems on a
daily basis. Some of these problems involve people and human relations, whereas
othersrequire amathematical solution. In this chapter we will deal with problems
involving mathematical solutions, and several ways in which these problems can
be approached.

1.3. Mathematical Problem Solving

Mathematical problem solving is the process by which an individual uses previ-
oudly acquired knowledge, skills, and understanding to satisfy the demands of an
unfamiliar situation. The essence of the process is the ability to use information
and facts to arrive at a solution. There are two characteristics of problem solving
that must be remembered when solving problems using mathematical processes.

1. The mathematical process does not always give you the answer—just more
information so that you can make amoreinformed decision. Good decision-making
reguires good information.

2. Whenever perfection is not possible or expected, levels or intervals of accept-
ability must be established. When perfection is not possible someone must deter-
mine the amount of error that is acceptable. The acceptable level of error may be
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determined by standards, manufacturers’ recommendations, comparison to another
Situations or machines or personal experience.

Both of these characteristicswill be utilized and explained in moredetail in later
chapters by using examples.

Problems can be solved in different ways. One of the objectives of this chapter
istoincrease the reader’ s knowledge of problem-solving methods. Seven different
approaches to solving mathematical problems will be discussed: diagrams and
sketches, patterns, equations and formulas, units cancellation, intuitive reasoning,
spreadsheets, and flow charts.

1.3.1. Diagrams and Sketches

Some problemsinvolvethedeterminati on of aquantity of items, such asthe number
of nails per sheet of plywood or the number of studsin awall. In solving these
types of problemsit usually is helpful to draw a sketch or a diagram.

Problem: How many posts are needed to build afence 100 ft long with posts 10 ft
apart?

Solution: For many people the first response would be 10:

_ 100ft
"~ 10.0 ft/post

but adiagram, Figure 1.1 shows that the correct number of postsis 11.

Thisis an example of a situation where a wrong answer is possible if you do
not interpret the problem correctly. In this example, 10 is the number of spaces,
not the number of posts.

Posts = 10 posts

FIGURE 1.1. Number of posts.

1.3.2. Patterns

The solution to some problems may depend upon on€e’s being able to discover a
patterninan array of numbersor values. Frequently, it isconvenient to examinethe
patternsin asample rather than the entire population. Once a patternis discovered
and shown to be consistent for the sample, it can be used to predict the solution
for the entire population.
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TABLE 1.1. Patternsin numbers, first sample.

Cow number
Ration Child 1 2 3 4 5 6 7 8 9 10
Grain 1 N N N N N N N N N N
Mineral 2 Y Y Y Y Y
Hay 3 Y Y Y
Silage 4 Y Y
Water 5 Y Y

Problem: A dairy farmer has five children. Each child is responsible for one part
of the daily feed ration for the family’s 100 dairy cows. The oldest is responsible
for the grain, the second for the minerals, the third for the hay, the fourth for the
silage, and the fifth for water. Instead of feeding each cow, the first child decides
shewill not feed the cowsat all that day. The second child decidesjust to feed every
other cow, the third child feeds every third cow, and so on. Dad soon discovers
how the cows were fed, and needs to know which cows did not receive any feed
or water.

Solution: When one is faced with this type of problem, it is usually helpful to set
up atable. Inthiscase, it would be very time-consuming to set up atablefor all 100
cows. Instead, select asample of the cows. If apattern istrue for the sample, there
is a high probability that the pattern will be true for a large group. Determining
the size of a sample is not always easy. Pick one, and if a clear pattern does not
appear, increase the size until a pattern develops. We will start with the first 10
cows, Table 1.1.

In this sample, cows #1 and #7 did not receive any grain, mineral, hay, silage,
or water. Isthis enough information to establish a pattern? We will predict that the
next cow that did not receive any feed or water is#11. Why? To test this prediction,
the sample size must be extended to include a larger number of cows.

Table 1.2 shows that the prediction was right; cow #11, along with #13, #17,
and #19, did not receive any grain, minerals, hay, silage, or water. Itisnow safeto
consider that the prediction could be used to identify all of the animals within the
herd that did not receive any grain, minerals, hay, silage, or water (those animals
represented by prime numbers, that is, a number divisible only by itself and one).

TABLE 1.2. Patternsin numbers, second sample.

Cow number

Ration Child 11 12 13 14 15 16 17 18 19 20

Grain 1 N N N N N N N N N N
Mineral 2 Y Y Y Y Y
Hay 3 Y \4 Y

Silage 4 Y Y Y
Water 5 Y Y
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1.3.3. Equations and Formulas

Equations and formulas are very similar problem-solving tools. Some texts study
them separately, but in this section they will be combined. Equations are away of
showing the relationship between different variablesin aproblem and are usually
derived asneeded for each problem. Formulasare equationsthat are used frequently
enough or are some how unique enough that they are remembered and used without
aderivation.

1.3.3.1. Equations

The solution to some problems requires the derivation of amathematical equation
based on a pattern or another type of relationship between the numbers. These
equations will be unique for each problem.

Problem: How much wireis needed to build a single wire fence around a rectan-
gular field measuring 450 ft long and 350 ft wide?

Solution: In this example there are three quantities: length, width, and perimeter.
It should be obvious that the perimeter is a function of the other two. Begin by
assigning the variables L to represent the length, W to represent the width, and
Pr to represent the perimeter. Then, because a rectangle has two lengths and two
widths, the perimeter can be found as follows:

Pr=(L+L)+(W+W)

Pr = (450 ft -+ 450 ft) + (350 ft -+ 350 ft)
= 900 ft + 700 ft
= 1,600 ft

1.3.3.2. Formulas

For some problems the rel ationships of the variables are fixed and constant, so the

equation for that problem isremembered and used. These equations are sometimes

called formulas. Another characteristic of formulas is that they usually contain a

constant. Oneexampleistheareaof acircle: A = nr2. Thevariabler isaconstant.
There are at least two important considerations in using formulas.

1. You must enter the numbers with the correct units of measure. All formulasare
designed with specific units for the numbers, especialy if they have a constant. If
the units are incorrect, the answer will be incorrect. An example is the equation
used to determine the application rate of aboom type sprayer:

ga 5,940 x Flow rate (gal/min)

Applicati ==
pplication rate — Speed (mi/hr) x nozzle spacing (in)

It should be obvious that the units in the equation do not work (the units when
combined do not result in the units for application rate, gal/min). This equation is
an example of a situation in which units conversion values, that are always used
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each time the problem is worked, are combined into a units conversion constant
(5,940). If any one of the values is entered in different units, the answer will be
incorrect. When we solve for the application rate using units cancellation and
conversion values, the source of the constant becomes apparent.
ga gd 60min lhr 1mi
— — X X - X
ac min 1lhr Imi  5,280ft
43560ft> 12in 1
X X X —
lac 1ft lin
31,363,200
5,280
ga

= 5,940 —
min

2. You must be able to rearrange the formula to solve for the unknown value.
For example, the application rate equation could be rearranged to solve for nozzle
spacing in inches (nsi):
5,940 x Flow rate (gal/min)
Speed (mi/hr) x Application rate (gal/ac)
For the remainder of this text the terms equation and formula will be used as
synonyms.

Nozzle spacing (nsi) =

1.3.4. Units Cancellation

Some problemsare morecomplex thanthe exampleswehave used, and many do not
have patterns or previously developed equations. Equations can be devel oped for
some of these problems, but an aternative approach isunits cancell ation. Problems
of this type will usually involve several quantities. All of these quantities, except
7, will have a unit such as feet, pounds, gallons, and so on. Units cancellation
follows two mathematical principles: (1) the units of measure associated with the
numbers (feet, gallons, minutes, etc.) follow the same mathematical rules as the
numbers; (2) the units of the numbers behave according to the rules of fractions.
For example:

2x2=40r2?
With units of feet the same equation is:
2ft x 2ft =2 x 2and ft x ft or 4 ft?

To review the rules of fractions study the following example:
3 4 3x4 3

4757 4x5 5
In this example, the 4'sin the numerator and denominator cancel out (4/4 = 1).




6 1. Problem Solving

When the units of measure are included, they behave in the same way:
3ton 4hr 12ton ton
4hr “Bday  20day day
In this example, the 4's and the units associated with them cancel out. The un-

cancelled units become the units for the answer. The following example shows
another variation of this principle (where gal = gallon and hr = hour):

a
5?17 « 3hr = 15 gal

In this example, the unit of hour in the numerator and denominator cancel each
other, leaving the units of the answer in gallons.

Problem: What isthe weight (Ib) of one pint of water?

Solution: If ascale and a one-pint measure were available, it would be a simple
task to weight one pint of water. An alternative is to use the conversion factors
found in atable of weights and measures (Appendix |) and units cancellation.

Note, in this example two types of measure are used, volume and weight. The
real nature of the problem isto find the conversion value(s) that will convert from
volume (pints) to weight (pounds).

To begin, refer to Appendix | and identify conversion factors that use both
volume and weight. You should find that 1 cubic foot contains 7.48 gallons, and 1
gallon contains 8 pints. Thisis a start, but you need something more. If you aso
know that water weighs 62.4 1b per cubic foot, the problem can be solved with
(Ib = pounds, gal = gallons, pt = pints, and ft> = cubic feet):

Ib 62.41b 1ft3 1gal
pt~ 1f@  7.48gd  8pt
—104 2
pt
The units of pints, gallons, and cubic feet all cancel each other leaving the answer
inthe desired units of pounds and pints. Thisexampleillustrates several principles
of units cancellation.

e Itisvery important to begin by writing down the correct units for the answer.

e Write down the equal sign (=),

» Begin entering the values and their units. Thefirst value entered should have one
of the desired units in the correct position (numerator or denominator), even if
it is a units conversion value from Appendix | or another source. Starting with
one of the units of measure in the correct position will eliminate the possibility
of having the problem inverted.

* Enter a value that will cancel out the unwanted units, if any, in the first value
entered.

e Continue to add variables with the appropriate units until the only units that
remain are the units of the answer.



Mathematical Problem Solving 7

« If al of the units cancel except those that are desired for the answer, and the
units are in the correct position, then the only possible mistake is a math error.

The process of units cancellation isa so useful for problems requiring the devel op-
ment of anew unit. For example, avery common quantity in agriculture is power.
Power can have different units, depending on whether it iselectrical or mechanical.
The units of mechanical power are ft o Ib per minute. The solution to a problem
in which a 24-0z weight was moved 15 ft in 5 sec would look like this (with
0z = ounces, sec = seconds, |b = pounds, ft = feet):

ftelb 15ft 60sec 1llb 240z
min ) Ssec  1min 160z . 1
21,600 ft e Ib
80 min
270ftelb
~ min
(Notethat Ib e ft isacompound unit, not feet minus pounds or feet times pounds.)

This same process will work just as well for problems with units that are more
complex and more variables.

-

1.3.5. Intuitive Reasoning

Intuitive reasoning is a process by which an individual arrives at a correct answer
through insight or ahunch, usually without being able to explain the process used.
The actual process depends on the individual and cannot be defined in progressive
steps.

Problem: You ask your employeesto determine how many vehiclesin the parking
lot need their seat covers replaced. They return with an answer of 150. Then you
realize you need to know how many single seat pickups and how many cars with
two seats. Your employees remember that there were the same number of carsin
the lot needing seat covers as pickups, so how many car and how many pickup
seat covers do you need?

Solution: Some people would solve this problem algebraically, but intuitive rea-
soning can be used to reason out a series of approximations. If there were 20
cars and 20 pickups, you would need 60 seat covers[(20 x 1) + (20 x 2) = 60],
if 40 cars and 40 trucks, 120 seat covers, if 60 of each then 180 seat covers.
The answer must be less than 60 and more than 40. The correct number of vehi-
clesis 50. Which means you would need 50 pickup seat covers and 100 car seat
covers.

1.3.6. Spreadsheets

The development and adoption of computers has provided a very useful problem-
solving method. This is the spreadsheet. A spreadsheet is a very powerful data
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FIGURE 1.2. Columns and rows af a spreadshest.

management tool that provides a means to enter, manipulate, and plot data and
information. There is some variation in the features of different spreadsheets, but
they all include several common features. Some of the common features and uses
of spreadsheets will be presented in the following sections.

1.3.6.1. DataEntry

To be ableto use datain a spreadsheet the computer must know whereitis. Thisis
accomplished by setting up agrid or array using columns and rows. It is common
for the columnsto beidentified by lettersand the rowsto beidentified by numbers.
Thejunction of each row and columniscalled acell. Thelabel sused for the column
and rows gives each cell a unique address or location, see Figure 1.2.

Inthe example spreadsheet shownin Figure 1.2, thecell that hasthe* XX” would
be cell E6 located in column E and row 6. The number of columnsand rowsthat are
included varies with the producer of the spreadsheet. A popular one has columns
that go through the al phabet several times and stops at I5. The rows are numbered
to over 10,000. A grid with 256 columns and 10,000 rows would have 2,560,000
individual cellsfor information. The dataare entered into the spreadsheet by typing
the desired data into the appropriate cell.

Spreadsheets have many other features for recording and manipulating data.
Onefeature isthe ability to link information in different sheets. For example, one
type of spreadsheet uses the term “workbook” to describe a spreadsheet file. Each

FIGURE 1.3. Linking sheetsin aworkbook.
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FIGURE 1.4. Adding datain aspread-
sheet.

workbook can have several pages and the datain one page can belinked to another
page. If cell B3in sheet #1 contained the equation “ = Sheet2! C4”, that cell would
display the contents of cell C4 in sheet #2, Figure 1.3.

Most spreadsheets also have the capability of importing the data from other
sources. Experience with using spreadsheets teaches that the user should give
some thought to how much datawill be used and the best way to organizeit before
starting data entry. This will make the spreadsheet easier to use and the user will
make fewer mistakes.

Although spreadsheets are primary for process data and calculate results, text
can aso beincluded in the cells and it can be used to process the data.

1.3.6.2. Data Processing and Calculation

Datain a spreadsheet can be processed with almost any mathematical operation or
function. The math functions are used by entering the equation with the functions
in the cell where the user wants the answer.

For example, if the desired operation is to add the two numbers in the example
spreadsheet in Figure 1.4 and have the answer appear in cell D2, the equation to
completethisoperationwould beinsertedin cell D2, Figure 1.5. Note that the equa-
tion is started with the “=" sign. In most spreadsheets, starting with the “=" sign
tellsthe computer that amathematical operation or atext processwill be performed
on data from other cell(s) and the results displayed in the cell with the equal sign.

This is a simple example, but al mathematical operations are entered in the
same way. To expedite the process, spreadsheets also include an option called
function. Functions are preprogrammed mathematical operations, such as sum,
square roots, and trigonometry functions. These functions are usually accessed
through a separate menu option. Functions may be categorized as financial, date
and time, math and trig, statistical, lookup and reference, database, text, logical, or
information. Not all of these functionswill be explained in thistext. Two examples
will be included to show how functions work. The addition examplein Figure 1.5
can be completed using the sum function from the math and trig category.

FIGURE 1.5. Exampleof amathemati-
cal operation in a spreadsheet.
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FIGURE 1.6. Addition using the sum
function.

In this example 7, the sum of 3 and 4 would appear in cell D2 (see Figure 1.5).
In this example, there is no clear advantage for using the sum function instead of
inserting the equation for adding two numbers. The advantage of the sum function
is much more apparent when more numbers are added, Figure 1.7.

Using the sum function is much simpler than writing the equation to add several
numbers. To write the equation for row 2 in Figure 14.7 using the “+" operator,
each cell reference must be included with a “+" in between. The equation “=
A2+ B2+ C2 + D2 + E2 + F2" would be entered into cell H2. This operation
is easier using a function. The “sum” function is used by entering an = in the
cell where the answer iswanted and then sum. After that enter the left parenthesis
“(“the beginning and ending cell to be added separated by a “:” and finish by
entering the right parenthesis*)”, cell H2, Figure 1.7.

It cannot be demonstrated in this text, but the use of functions is enhanced
becausethe cells can be entered in by highlighting the desired ones. The procedure
istoenter “= SUM (then highlight the cellsand end the equation with)” to complete
the function. Also note that in Figure 1.7, cells can be summed both horizontally
and vertically. All of the functions are used in asimilar manner.

Another feature of spreadsheetsislogic functions. Logic functions are expres-
sionssuchas“IF’,“AND”,“FALSE”,“NOT”,“OR"” and“ TRUE". L ogicfunctions
arevery useful becausethey can be used to compareor rel ate the values of different
cells. The “if” function includes a logic statement so it can be used to compare
cells and return a number or word. For example, a flour miller must constantly
monitor the percent of flour milled from the wheat. A drop in yield rate would
indicate a problem. The “IF” function can be used to trigger an error or warning
message when the yield drops below the desired rate, see Figure 1.8.

FIGURE 1.7. Using sum function with multiple numbers.
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FIGURE 1.8. Spreadsheet using the “IF” function.

Inthisexample, an*IF” function was used to trigger the spreadsheet to insert the
word “error” whenever the percent yield of flour was |ess than 90%. The function
that was inserted into cell B6 written as. = IF(B5<90,”Error”,” “). This function
was then copied (filled) into the adjoining cells, C2 through H2. Spreadsheets are
very powerful tools and allow alot of flexibility in how they are set up. Through
study and practice, the user can make them do very complex calculationsand logic
statements.

1.3.6.2.1. Fixed or Relational Reference

In the example in Figure 1.8, the reference cell “B5” was not fixed because the
desired outcome was to use the same function to sum the columns B through H.
Thisisan example of using arelational reference. Reference cells can also befixed
so they do not change when the function is copied. An exampleisif the miller in
the flour example wanted the spreadsheet set up so that the yield percent could
be changed without requiring the retyping of all of the equations. This could be
accomplished by using afixed reference cell for the yield percent, Figure 1.9.

In this example, the user can change the percent yield that will trigger the
“Error” message by changing the value that is in cell B1. To accomplish this
thefunction in cell B7 was changed and then copied (filled) to the adjoining cells.
The function in cell B7 reads: = IF(B5 < $B$1,"Error”,” “). In the spreadsheet
used to develop these examples placing the “$” in front of the column and row
label fixes these labels so they do not change when the function is copied into
adjoining cells.

These examples are just a hint at the type of data manipulation that can be
accomplished using spreadsheets. They are only limited by the amount of time and
ingenuity of the user to figure out how to make them complete the desired tasks.

FIGURE 1.9. Spreadsheet using fixed reference cell.
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1.3.6.3. Graphing

Another powerful and useful feature of spreadsheets is the ability to produce
graphs of the datain the spreadsheet. Some spreadsheets use the term chart instead
of graph. Many people are visual learners and seeing a chart of the data will
convey information faster and easier than studying the same datain atable. The
charting function of most spreadsheets is not as powerful as a dedicated graphing
or presentation program, but they will usually provide enough options to satisfy
the needs of the average user.

Producing agraph with a spreadsheet has the same requirements as drawing one
by hand. The computer must know which set of data should be plotted along the
“X" axisandwhich alongthe*Y” andthe“Z” if three-dimensional chartsare used.
The chart function should provide an opportunity to type in labels for the axis,
the chart title and data legends and values if desired. To demonstrate the charting
function acommon problem of surveying will be used. A common survey iscalled
aprofile. A profile survey collects the data necessary for defining the topography
of the earth’s surface along a route. This is usualy done for a utility, sidewalk,
road, or retaining wall. In this example, an underground drainpipe will be used.

Table 1.3 contains the data for a profile survey. More information will be dis-
cussed about profile surveys in alater chapter, but to help understand the use of
a chart, the numbers in the STA column are the distances from the starting point
for each station and the numbersin the ELEV column are the elevations for each
station along the profile. This information is combained with the calculations for
the drain elevations at each station, Table 1.4, before the profile and the drain can
be shown in a chart.

Assumethe outlet of the desired drainis 2 ft below the elevation of station “0.0”
and the drain will have a 1% dlope. Table 1.4 shows the starting elevation, the
surface elevation, and the el evation of the drain at each station. The drain elevation

TaBLE 1.3. Datafor profile survey.

STA BS HI FS IFS ELEV
BM 3.56 103.56 100.00
0.0 103.56 4.89 98.67
27.3 103.56 4,67 98.89
35.6 103.56 5.10 98.46
41.2 103.56 5.89 97.67
56.9 103.56 4,68 98.88
63.4 103.56 3.61 99.95
75.9 103.56 4,01 99.95
80.7 103.56 4,65 98.91
935 4.04 103.92 3.68 99.88
BM 391 100.01

Sum 7.60 7.59
Difference 0.01 0.01
0.01=0.01

AE= 0.02 .01<.02
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TABLE 1.4. Dataand profile and drain.

A B C

1 Starting

2 Elevation 96.67 ft

3 % Slope 1%

4

5 Station Profile Drain elevation

6 0.0 98.67 96.67

7 27.3 98.89 96.94

8 35.6 98.46 97.03

9 41.2 97.67 97.08
10 56.9 98.88 97.24
11 63.4 99.95 97.30
12 75.9 99.55 97.43
13 80.7 98.91 97.48
14 935 99.88 97.61

is determined by inserting an equation in cell C7 and copying it down through
C14. The equation is; = $C$6 + (C7 x $B$3/100).

A person with experience in design and construction would be able to study the
table and answer important questions about this drain. Such as, “What is the
maximum depth?’, or “What is the minimum depth?’, and numerous others.
The importance of these questions and their answersis easier to seeif the dataare
plotted in a chart. In a chart it is easy to see the difference in elevation between
the surface and the drain, the depth of the drain, etc. The chart or plot of the profile
and the drain are shown in Figure 1.10.

Figure 1.10 shows that the maximum depth occurs at 62 ft from the start and
the difference between the surface elevation and the elevation of the drain is about

FIGURE 1.10. Chart of profile and drain.
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TABLE 1.5. Drain data at 0.5% slope.

A B C

1 Starting

2 Elevation 96.67 ft

3 % Slope 0.5%

4

5 Station Profile Drain elevation

6 0.0 98.67 96.67

7 27.3 98.89 96.81

8 35.6 98.46 96.85

9 41.2 97.67 96.88
10 56.9 98.88 96.95
11 63.4 99.95 96.99
12 75.9 99.55 97.05
13 80.7 98.91 97.07
14 935 99.88 97.14

100.0 — 97.4 or 2.6 ft. Theminimum depth occursat station40and itis97.6 — 97.1
or 0.5 ft. This could be a problem because a drain only 6 inch depth is easily
damaged and in cold climates could have problems with freezing.

The power and usefulness of spreadsheets can be shown using this example.
In Table 1.4, the slope of the drain was in an individual cell and the eguations
used it with afixed reference. Thiswas done so it would be easy to do “What if 7’
scenarios. Such as, “What if the slope of the drain was changed to 0.5%7" The
results are shown in Table 1.5 and in Figure 1.11.

FIGURE 1.11. Drain with 0.5% slope.
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Notethat inthischart thevaluesfor each point were displayed. Thisisacommon
feature of spreadsheet charts. This shows that the maximum depth of the drain
changes to 99.95 — 96.99 or 2.96 ft. The minimum depth changes to 97.67 —
96.85 or 0.82 ft. This“What if?" was accomplished by changing one valuein the
spreadsheet.

Spreadsheets are capable of much more complicated calculations and charts.
In addition, they usually have the capabilities of recording “macro’s’ to automate
actions that are frequently used and require multiple keystrokes. Another feature
of some spreadsheetsisvisual basic programming language. Thisfeature provides
the tools for the user to write programs to manipulate or use datain some special
way. This discussion of spreadsheets does not describe all of the capabilities and
features of spreadsheets, but it attempts to explain their basic operation and show
some of their useful capabilities. It is up to the reader to explore their capabilities
in greater depth.

1.3.7. Flow Charts

Flow chartsare used to graphically show therelationships of different partsor steps
of aprocess. Two examplesarethe chain of command for an organization, the steps
and alternatives in a manufacturing process. Different graphical symbols are used
to represent different actions and lines and arrows can be used to show direction of
flow. The complexity of the flow chart mirrorsthe complexity of the process being
graphed. Flow charts can be categorized by type. Common types are sequential,
loop, branch/decision making, and combination. Flow chart symbols represent
different points along the process. An occupation or business may develop specific
symbols for their specific needs, but several common symbols have been adopted
by flow chart users. Figure 1.12 illustrates six of these.

FIGURE 1.12. Common flow chart symbols.
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FIGURE 1.13. Example of flow chart.

In addition to different symbols representing different actions, different types
of lines and arrows can be used to represent the relationship between the different
stepsor symbolsin the process. Figure 1.13 isan example showing the alternatives
and processes that might need to be completed to get from home to schoal.
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Significant Figures and Standard Form

2.1. Objectives

1. Be able to define precision, accuracy, and uncertainty when working with
numbers.

. Understand the difference between exact and approximate numbers.

. Be able to determine the number of significant figures.

. Understand a technique for rounding numbers.

. Understand the uses of scientific notation.

abbowidN

2.2. Introduction

There is no substitute for a good understanding of numbers and mathematical
processes in solving modern agricultural problems. In this unit, we will discuss
several features of numbers and techniques to use with numbers.

2.3. Precision, Accuracy, and Uncertainty

Itisimportant to understand three characteristics of numbersin solving agricultural
problems: precision, accuracy, and uncertainty. Precision refers to the size of the
unit of measure used to obtain the number. For example, if asack of feed isweighed
on a scale measuring to the nearest 0.1 |b, the weight is not as precise as it would
beif the smallest unit of measure was to the nearest 0.01 |b.

The accuracy of a number refers to the number of decimal places obtained in
the answer. The greater the number of decimal places, the greater the accuracy. A
measurement of 12.15 ft is more accurate than a measurement of 14.4 ft.

Theuncertainty of anumber istheamount itisexpected tovary. If theuncertainty
is not stated after the number, say, 14.5 ft & 0.01, then you may assumeit is +
half of the smallest unit, Table 2.1.

17
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TABLE 2.1. Level of uncertainty.

Number Uncertainty

25 +05

157 +0.05
2.567 + 0.0005

Source: Theory and Problems of Technical Math-
ematics, Schaum’s Outline Series, McGraw-Hill
Book Company, New York, 1979.

2.4. Exact and Approximate Numbers

Problemsin agriculture usetwo different types of numbers, exact and approximate.
The two common examples of exact numbers are those obtained by counting and
ratios. For example, if you count the number of horsesin a pen and arrive at 10,
you have exactly 10 horses, not 10 and 1/2 or 9 and 3/4. Ratios are exact numbers
because 3/4 of acircleisexactly 3/4 of acircle. One note of caution about ratios,
ratios expressed as adecimal, say, 2/3 = 0.6666666 . . ., are approximate numbers
because some ratios expressed as a decimal contain repeating digits.

Any number obtained by a measurement is an approximate number. The actual
value of an approximate number is uncertain because all measuring devices have
alimit to their precision. If you have aruler that is graduated in 1/16 of an inch,
then theruler isonly preciseto the nearest 1/16 of an inch. The following example
illustrates this point.

In Figure 2.1, the length of the rectangleisnot aligned with any of the markson
the scale (ruler). You must record the length of the box to the last shorter reading,
2-9/16's, or the next longer reading, 2-5/8. Regardless of the value you choose,
the answer you record isonly closeto the actual length, and thusis an approximate
number. If the desire is to reduce the amount of uncertainty in the measurement,
then aruler with higher precision, such as 1/32's of an inch should be used.

When approximate numbers are used, digits can beintroduced into the problem,
that are not accurate (significant). If these digits are included, the accuracy of the
answer may decrease with every computation. The potential for error isespecialy
great if acalculator is used because most calculators show eight or nine numbers,
regardless of their significanceto the problem. Thetask of the calculator operator is

FIGURE 2.1. Example of an approximate number.
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to determinehow many digitsaresignificant and to round accordingly. Determining
significant figuresis discussed in more detail in the following section.

2.5. Significant Figures

The principle of significant figuresisimportant because the precision of anumber
should not beincreased by mathematical computations. Cal culatorsroutinely carry
7 to 14 decimal s places on screen and/or in memory even though the accuracy and
precision of measurements are only two or three places. It is usually necessary to
determine the number of digitsthat should be kept in a number after mathematical
computations. The rules for determining significant digits are different for exact
and for approximate numbers.

Because there is no uncertainty with exact numbers, all of the digits are con-
sidered to be significant. When rounding answers produced with exact numbers,
assume that they have the same number of significant figures as the largest exact
number.

Determining significant figures for approximate numbers is more complicated.
Thefirst issueisthe significance of zeros. A common practiceisto consider azero
significant if it is between another number and a decimal point or to the right of
the decimal point. For example, 540.2 has four significant figures and 540.0 has
four significant figures. A zero isnot considered significant if it isto the left of the
decimal point. For example 0.325 has three significant figures, but 0.0325 would
have four. A zero is not considered significant when it isthe last number and there
isno decimal point. For example, 540 has two significant figures. An exception to
thisrule is when the zero is the result of rounding. The number 459.8 rounded to
three significant figuresis 460. In this case the zero is considered significant. The
problem is when the reader doesn’t know if the zero is the result of rounding. In
this case the significance of the zero can be ambiguous.

For nonzero numbersthe number of significant digitsfor an approximate number
depends on the precision of the measuring instrument. If you are given the weight
of a steer as 551 |b and know that the scale measured to the nearest 0.1 Ib, then
the actual weight could be less than 551.1 but more than 550.9 Ib and be recorded
as 551 Ib. The number will have four significant figures. To be correct, if the
weight of the steer was actually 551 Ib, the number should have been written as
551.0.

When the precision of the measuring instrument is not known, determining
significant figures is much more difficult. A common practice is to assume the
precision is +/— one haf of the smalest unit in the number. For example, a
distance of 347 ft would have four significant figures because the measurement
could be between 347.4 and 346.6 ft and be recorded as 347 ft.

Problem: You are helping measure the weight of a calf on scales that measure
to the nearest 0.5 Ib. You are told the calf weighs 102 Ib. How many significant
figures does the weight have?
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Solution: The number of significant figures is four. The scale can read 101.5,
102.0, or 102.5. If the pointer on the scale is between 101.5 and 102.0 but closer
t0 102.0, then the reading is recorded as 102.0. Similarly, if the pointer is between
102.0and 102.5 but closer to 102.0, then reading isrecorded as 102.0. If theweight
is exactly 102 Ib, the weight of the calf should be recorded as 102.0 Ib. Then the
weight has four significant digits.

Consider the following situation:

Problem: What is the area (ft) of aroom if the width is 12 ft 3 in and the length
is22ft3/16in?

Solution: Thefirst step isto convert the dimensionsto decimal form, 12 ft 3in=
12.25 ft, and 22 ft 3/16 in = 22.1875 ft. Completing the multiplication gives a
value of 271.79687 ft?>. How many digits are significant?

Two rules have been developed to help determine the number of significant
digits during mathematical computations.

¢ Adding or subtracting: the answer should be rounded to the number of decimal
placesin the least precise number.

e Multiplication and division: the answer should be rounded to the number of
significant figuresin the least accurate number.

For this problem, rule number two applies. The product, 271.79687, is reduced to
four significant figures. The correct areafor the room is 271.8 ft2.

Problem: You need to know the perimeter of the room to calculate the amount
of paint needed to paint the walls. The dimensions of the floor are 12.25 ft by
12.1875ft.

Solution: In this case the perimeter is the sum of the lengths of the four walls
intheroom, P = 12.25 + 12.25 + 22.1875 + 22.1875. For this problem, rule
number one applies. The sum, 68.1750, is reduced to four significant figures. The
answer is 68.18 ft.

2.6. Rounding Numbers

Rounding is used to eliminate figures that are not significant. When the digits to
be rounded areto the left of the decimal point, the digits are replaced by zeros. For
example, if you need to reduce the area of an acre, 43,560 ft2, to two significant
digits, round to 44,000 ft2. When the digit being dropped is greater than 5, add
one to the next digit remaining. When the digit being dropped is less than 5, the
first remaining digit isunchanged. If the digit being dropped isexactly 5, leave the
remaining digit even. When the remaining digit isodd, add one, if it iseven, leave
it asis. For example, if the number 43,560 is rounded to one significant digit, the
answer is 40,000; rounded to two it is 44,000; and rounded to three it is 43,600.
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2.7. Scientific Notation and Standard Form

Scientific notation and standard form were developed to express large or small
numbers in a more convenient form. They both use powers of 10 to replace the
nonsignificant digits of alarge or small number. Standard form uses awhole digit,
then adecimal point, and two significant figures. It was primarily used with slide
rules because three significant digits was the practical limit. Scientific notation
uses the same format. The difference is that in scientific notation the number of
significant figures is not limited to three. For example, if the number 1,000,000
has one significant figure, it is expressed as 1.0 x 10°. This number is read as
“one point zero times ten to the sixth power.” The number 43,560,000 expressed
in scientific notation with four significant figures would be 4.356 x 107. To use
scientific notation effectively you must understand the powers of numbersand how
they can be manipulated during mathematical computations.
First areview of the powers of 10:

10°=1
10 = 10 10t =0.10r E
10
102 = 100 102=0.01or i
100

1
=1 103 =0.0010r ——
10 ,000 0 0.001 or 1000

10* = 10,000 10~* = 0.0001 or

10,000

There are several helpful rules to use when working with powers of 10:

e When a number 10 and its exponent are moved from the denominator of a
fraction to the numerator, or from the numerator to the denominator, the sign of
the exponent is changed. Thus:

1 _103and10*4_ 1
103 1 1 104
* When two or more numbersin standard form are multiplied together, the powers
of 10 can be added. Thus:

103 x 10° = 106G+ = 108
10° x 1072 = 1065+(-2) — 103
1074 x 1073 x 10* = 10(-9+(=3+4) — 10-3

It isimportant to note that different methods are used to express scientific nota-
tion. One method replaces the 10 and exponent with an “E” and the power of
10.

40E3x50E5=20E3®=200E8
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Another method reduces the confusion of using an “ x” to represent both multi-
plication and powers of 10 by replacing the“ x” for multiplication with a*®.

4.0e10° x 5.0 10° = 20 ¢ 10°*®> = 20 ¢ 108
Other methods are also used.

¢ When two or more numbers in standard form are divided, the powers of 10 are
subtracted. Thus:

10* 410"

F:lOlOI’lO ﬁ:ZolOz
[ ]

10~* 10°6 40107 94105

—_— = [ ]

107 2 e 10°

¢ Whentwo or morenumbersin standard form areadded or subtracted, thenumbers

must be converted to the same power of 10, and the power of 10 is not affected
during the addition or subtraction. Thus:

4 e10* — 3 10° becomes 40 e 10° — 30 10° = 37 @ 10°
reduced to 3.7 ¢ 10°
and

4 ¢ 10" + 3 ¢ 10° becomes 40 e 10° + 3 @ 10° = 43 ¢ 10°
reduced to 4.3 ¢ 10°
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Common Units of Measure

3.1. Objectives

Be able to explain the different type customary units of measure.
Be able to convert from one unit of measure to another.

Be able to use the units associated with each measurement.

Be able to cal culate horsepower.

Be able to explain the SI measuring system.

Be able to explain differences between weight, force, and mass.

oSourwWNE

3.2. Introduction

All measurements require a unit to define the precision of the measurement. The
preferred unit depends on the magnitude of the measured variable. For example
in the customary system, commonly used in the United States, when the distance
islarge the mile is the preferred unit. When the distance is very small the unit of
measure could bein decimal inches (0.01 in) or fractions of aninch (3/64in). The
units of measure can be divided into several categories. The common categories
used in agriculture are:

1. Distance 6. Pressure
2. Area 7. Time

3. Temperature 8. Velocity
4. Volume 9. Torque

5. Weight or Force 10. Power.

3.3. Systems of Units

In modern agriculture we deal with two systems of units, the U.S. Customary
system (sometimes called the English or gravimetric system) and the Metric or S|
system. Both of these systemswill be discussed in this chapter.

The bases for many of the units of measure in the customary system arelost in
history. The Weights and Measures Division of the National Institute of Standards

23
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and Technology has the responsibility of storing and maintaining the standardsfor
al of the customary units of measures. They have the standard foot, the standard
yard, the standard pound, etc. All of the measuring devices used in the United
States are based on one of these standards.

3.3.1. Distance

The dimension of distance has two common meanings, displacement and length.
Displacement is the movement from one point to another. If you walk one mile,
you have displaced a distance of 5,280 ft. Length refers to the physical size of an
object. For example, the lengths of astandard piece of paper are 8.5 and 11 inches.
The common unitsfor distance areinches(in), feet (ft), yards (yd), and miles (mi).

3.3.2. Area

The unit of area is defined as the number of unit squares equal in measure to
the surface. This indicates that an area is a surface, and the size of the surface is
measured in terms of units squared. The common units for area are the units for
distance squared, in?, ft2, mi2, etc. Agriculture uses the acre (ac) as the unit for
large land areas. There are 43,560 ft? in one acre.

3.3.3. Temperature

Temperature is the degree of hotness or coldness of an object. Five different mea-
sures of temperature have been used. The customary unit of temperature is the
degree Fahrenheit.

3.3.4. Volume

Volumeis defined as the amount of space occupied by athree-dimensional figure.
The basis for a volume is a distance cubed; in®, ft3, etc. In the current system of
weights and measures additional units of volume are also used, such as gallon,
quart, pint, and cup. The Bureau of Weights and Measures has standardized the
guantity of each one of these unitsin terms of distance cubed. For example there
are231in®in oneliquid gallon, Appendix I.

3.3.5. Weight

Weight can be defined as the force of gravity acting on a body. The common units
for weight are ounces, pounds, and tons.

3.3.6. Force

Forceisthat action which causes or tendsto cause motion or achange of motion of
an object. To describe aforce completely, its direction of action, magnitude, and
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point of application must be known. What is commonly referred to as a “force”
is really two forces, as forces are never present singly, but always in pairs. The
two parts are called action and reaction. They are always of equal magnitude, but
in opposite directions. In this text, the weight of an object will be considered a
force. Forces are commonly measured in units of ounces (0z), pounds (Ib), and
tons (ton).

3.3.7. Pressure

Pressure is the amount of force or thrust exerted over a given area. Pressureisthe
combination of two units, force and area. Therefore the common unitsfor pressure
will be acombination of these two, 1b/in?, 0z/in?, |b/ft?, etc.

3.3.8. Time

The concept of time hasitsroot in the natural cycles of the earth. One very visible
cycle is the ocean tides. The words time and tide both come from the same root.
The current idea of time is as a measure of an interval of duration. Time may be
better described as an accounting technique for relating events. The common units
for time are seconds (sec), minutes (min), and hours (hr).

3.3.9. \elocity

Velocity, speed, isthe time rate of movement. Velocity is also a combined unit. It
isthe combination of distance and time. The common units of velocity are ft/min,
mi/hr, etc.

3.3.10. Power

Power istherate of doingwork. Work (W) istheresult of aforceacting (or moving)
through a distance. Written as an eguation:

Work (W) = Distance (D) x Force (F)
A numerical value for work may be obtained by multiplying the value of aforce
by the displacement.

Problem: If a force of 100.0 Ib displaces 12.0 ft, how much work has been
performed?

Solution:
W=DxF
= 12.0ft x 100.0lb

= 1,200.0 ft-Ib

In this situation 1,200 ft-1b of work was completed. Notice that according to this
definition, unless both distance and force are present, no work is being accom-
plished.
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Problem: A loaded wagon weighing 10,000.0 Ib requires 400.0 Ib of force to pull
it along a horizontal surface. How much work is done if the wagon is pulled for
100.0 ft?

Solution:
W=DxF
= 100.0ft x 400.01b
= 40,000.0 ft-1b

In this problem, the 400.0 Ib of forceis not related to the weight of the wagon. It
istheforce required to pull it.

: . Work . .
Written as an equation Power = Time because work equals distance times
force. Then:
Distance x Force W D
P0Wer=—I .X or P = — whichasomeansP = F x —.
Time T T

Because D/T equals velocity (speed), power is the force times the velocity. This
demonstrates that power is a combination of distance, force, and time.

Problem: How much power is developed when aforce of 100.0 Ib moves through
adistance of 12.0 ftin 2.0 min?
Solution:

b DxF _ 12.0ft x 1Q0.0Ib _ 1200.0ft-lb _ 600.0@
T 2.0min 2.0min min

Notice that the unit associated with power isacombination of theindividua units
for the variables. In this case, the answer is read as “ 600 foot-pounds per minute.”
Thisisthe“time-rate” at which work isbeing done. Remember; awayswrite down
the units that are associated with a number.

Problem: A personloadsa60.0-Ibbaleontoatruck platform4.0ft highin0.50 min.
How much power is being devel oped?
Solution:

DxF 40ftx60.0lb 240.01Ib ft-Ib
T ~ 050min  0.50min min
Up to this point we have used easy-to-understand values with units of feet for
distance, pounds for force, and minutes for time. Suppose that in the previous
problem the individual could load three 60.0-1b balesin 0.50 min. In this example
it is easy to make a mistake in determining a value for the force. The solution to
thisproblemis:

P

¢ 3baes 60.0Ib
o MO X e _ 720t ftdb
o 0.50 min T 050min 7 min

Here the average power produced is 1,400 ft-Ib/min because the weight moved in
0.50 min isthe weight of al three bales (3 x 60 Ib).
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This problemillustrates a principle of power. If three times the amount of work
is donein the same amount of time, the power will beincreased three times. What
istheimpact on the power produced if the distance changes, or if thetime changes?

Problem: If a person could load three 60.0-Ib bales onto the 4.0 ft platform in
10.0 sec, instead of 0.50 min, how would this change the power produced?

Solution:

p_ DxF _ 4.0ftx180.0|b=720ﬂ):72ﬂ3
T 10.0 sec sec Sec

The amount of power changed, but thisanswer cannot be compared to the previous
one because the units are different. You might ask, is foot-pounds per second an
acceptable unit of measure for power? Yes, but to compare this value for power to
the previous one the units must be converted. This can be accomplished in more
than one way. When the desired units are ft-lb/min, a conversion value can be
added to the equation. To change the unit of time from seconds to minutes:

4.0ft x 180.01b 720 ft-1b ft-lb
P= . = — = 4,320 or 4,300 —
1min 0.166...min min
10.0 sec x
60.0 sec

Now the two values can be compared. It should be obvious that it takes a greater
amount of power to complete the same amount of work in less time. A similar
relationship istrue for the distance moved. The power requirement will change as
the distance moved changes, assuming that the force and thetime remain the same.

Insummary, power isdirectly proportional to distanceand force, andisinversely
proportional to time.

In working with agricultural machinery, speed is usually measured in miles per
hour (mph). When thisisthe case, the unitsmust be changed. Otherwisethe answer
will be incorrect. Study the following statements:

If Power is equal to work divided by time, then:

FxD
P= .
T
This can be changed to:
P=Fx E
T

and because D/T (distance/time) is speed, if D/T is in miles/hour, it must be
converted to feet/minute. The common conversion factor for speedis: 1 mph = 88
ft/min. Thisfactor is obtained as follows:

ft 5,280 ft 1hr 1 mi
— = — X — X
min 1mi 60min  1hr
Therefore power can also be found by:
P=FxSx88

where F = force (Ib); S = Speed (mi/hr); 88 = Units conversion value.
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3.3.11. Torque

Torque is the application of aforce through alever arm. Itisaforce that causes or
tends to cause atwisting or rotary movement. In equation form:

Torgue = Force x Lever arm length
or:
To=F x LA

where To = Torque (Ib-ft or Ib-in); F = Force (Ib); LA = Lever arm length (ft or
in). The lever arm is the distance from the point the force is applied to the center
of revolution.

Because force is measured in pounds and length in feet or inches, the common
units of torque are pound-feet (Ib-ft) or pound-inches (1b-in).

Problem: How much torque is developed when a 50.0-1b force is applied at the
end of awrench that is 1.0 ft long?

Solution:

Notice that the answer has been written as “ 50 pound-feet.” To distinguish torque
from work, torque is written with units with the force unit first, “ pound-feet,” and
the units for work is written with the distance unit first, “foot-pounds.”

There is one additional difference between torque and work. We stated that
unless there is movement, there is no work. Because torque is a force working
through alever arm, torque can exist without movement.

Problem: Which of the following will cause a greater torque to be exerted on a
shaft: (1) 50.0 Ib of force applied at the end of a 6.0-in (1/2-ft) wrench, or (2) 15.0
Ib of force applied at the end of a 24.0-in (2-ft) wrench?

Solution:
(1) Top =50.01b x 0.5ft=25ft-Ib
(2) To,=15.01b x 2.0ft =30 ft-Ib

Situation (2) will cause greater torque (twisting effect) on the shaft.

3.3.12. Horsepower

Although power isabasic unit, in agriculture the more common unit i s horsepower.
Different measures of horsepower are used. For example, when discussing tractors,
you may use engine horsepower, brake horsepower, drawbar horsepower, or power
take-off horsepower. In the following section we will investigate the principles of
horsepower. Horsepower is an arbitrary unit that was developed by James Watt to
promote his early steam engines. He watched horses pulling loads of water out of
mine shafts and concluded that one horsepower was equal to performing work at
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the rate of 33,000 foot-pounds per minute. Expressed algebraically the conversion
from power to horsepower is:

| b-ft
Power — )
i I b-ft 1 min
Thp= — M 651 hp— Power —— x ———
33,000 % min 33,000 [b-ft

Note that unless power isin the units of ft-Ib/min, the use of the conversion factor
1 hp = 33,000 ft-Ib/min will not produce correct results. The common horsepower
equationis:

. FxD

~ T x 33,000

This is an example of an equation with a conversion constant. This means all

of the variables must have the correct units. This equation requires distance (D)
expressed in feet, force (F) in pounds, and time (T ) in minutes.

hp

Problem: How many horsepower are developed if a person loads six 60-Ib bales
onto atruck platform 4.0 ft high in 1.5 min?

Solution:
60.01b
. FxD 4.0ft x (Gbalesx bale )
P= 733000 1.5 min x 33,000
1,440
= 26505 = 0:02909...0r 0.029 p

Now consider what would happenif thetimerequiredtoload the hay ismeasured
as 90.0 sec instead of 1.5 min. Obviously 90.0 sec equals 1.5 min, but if the same
equation is used either the seconds must be converted to minutes or a different
conversion factor from power to horsepower must be used. If the 33,000 conversion
unit is used with time measured as 90.0 sec, the answer will be incorrect. The
problem can be solved in two different ways. The first way isto add a conversion
unit for time to the equation. This would be the preferred method for just a few
calculations.

60.01b
oo FxD 4.0ftx(6ba|%x—ba|e>
Tx33000 (900000 2™ | 33000
60 sec
1,440 ft-Ib
= 22D 602909, . 0r 0.029h
Jo500 = 0.02909...or 0.029 hp

The second way is to determine the appropriate conversion value for the units
being used. In a situation where horsepower will be calculated several times and
timeis measured in seconds, it would be more efficient to use a conversion value
from power to horsepower appropriate for when time is measured in seconds
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instead of minutes. This can be accomplished using units cancellation:

ft-lb 33,000 ft-lb 1 min ft-lb
hhdhiagui >
Sec 1min 60 sec

Using this conversion value, the previous problem can be solved by:

FxD _ 1440ftlb 1,440
T x550  90.0sec x 550 49,500

hp = = 0.02909 ...or 0.029 hp

Horsepower can also be calculated using torque and the speed of the shaft. This
is called shaft horsepower. This equation was used to evaluate the horsepower
being produced by early engines using a Prony Brake, Figure 3.1.

The early Prony Brake used the friction between a rotating flywheel and a
stationary block of wood to produce a force on the lever. Once the force on the
lever and the speed of rotation of the flywheel is known, the brake horsepower can
be determined. Mathematically brake horsepower is:

_ FLN
~ 5252

where F = Force produced (Ib); L = Length of the lever arm (ft); N = Rotary
speed of the Prony brake shaft (rpm); 5252 = Units conversion constant.
This equation is derived from the horsepower equation:

Bhp

2
~— xFxDxN
1hp=fe"x x DX _FxDxN
1hp 5252
ft-Ib
33,000 —
min

where the length of the lever arm equals the radius of the circle and the distance
the force is working through.

FIGURE 3.1. Prony brake.
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Problem: How many horsepower is an engine producing when 8 Ib of force are
measured at the end of an 18.0 inch Prony brake arm when rotating at 1,700
revolutions per minute?

Solution:
81lb x (18.0in X ﬂ) x 1,700 ﬂ
Bhp = FLN _ 12in. min
5252 5252
244,800
© 5252

=3.8842 ... or39hp

[Note: the answer was rounded to two significant figures because the significance
of the zero’sin 1,700 are ambiguous, but at least two significant figures should be
used because 8 Ib is a measurement and the uncertainty is +/— 0.5 1b.]

Brake horsepower contains alength and a force. We know from earlier discus-
sionsthat if we have aforce timesalength, we are dealing with torque. Therefore,
the brake horsepower equation can be rewritten to use torque:

Tox N
BhP = 5252
A Prony brake can still be used to measure the horsepower of engines, but
electrical and hydraulic dynamometers are more accurate than the Prony brake.

The rotary power of modern engines is measured by connecting directly to the
flywheel or by using the power take off (pto) shaft.

3.4. Using Unitsin the Metric (SI) System

A magjor problem with the customary unitsis that there is no logical relationship
between units. For instance, there is no obvious reason why the standard mile is
5,280 ft. The metric system was created in the late 18th century by the French to
address this problem.

One of the advantages of the Sl system is that all of the units are based on
natural phenomena. For example, ameter isthe distancelight travels, in avacuum,
in 1/299,792,458th of a second. The U.S. agricultural industry is based on the
customary unitsof measure, however many manufacturesare convertingto Sl units
and agriculture has become more international in buying and marketing products.
It iscritical to understand the differences between the two systems.

In the previous section the several customary units of measure were discussed.
The following section will explain the comparable units in the SI system. The Sl
system is adecimal-based system. To use the different units requires knowing the
prefixes used for the different powers of 10, Table 3.1.

Although the recommended practice in the metric system is to use the standard
units or 1,000 unit multiples of the units, Table 3.1, there are nonstandard units
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TABLE 3.1. Prefixesfor Sl units.

yotta[Y] =10% yocto [y] =102
zetta[Z] =104 zepto [Z] =102
exa[E] =108 atto [4] =10"18
peta[P] =10% femto [f] =101
tera[T] =10% pico [p] =101
giga[G] =10° nano [n] =10"°
mega[M] =106 micro [1] =106
Kilo [K] = 10° milli [m] =10-3
hecto [h] =107 centi [] =102
deca [da] —10 deci [d] —01

frequently used in the Sl system. It iscritical to understand and correctly apply the
differences between the U.S. Customary and the Sl system, Appendix II.

3.4.1. Distance

The Standard unit of distance in the Sl system is the meter. A meter is about
39incheslong. The other lengthsthat are commonly used are the millimeter (mm),
and the kilometer (km). A nonstandard commonly used length is the centimeter.

3.4.2. Area

The principle of area is the same—it is two distances multiplied together. The
units become millimeters squared, etc. In the customary system the standard unit
of land measurement isthe acre. In the Sl unitsit is the hectare. An acre is about
0.4047 hectares.

3.4.3. Temperature

In the Sl system the preferred unit for measuring temperature is Celsius. The
Celsius scale was established so that the boiling point of water isat 100°C and the
freezing point is at 0°C. The equation for converting from the Fahrenheit scale to
the Celsius scaleis:

5
Tc: 5 X(T[:—32)
and the conversion from Celsius to Fahrenheit is:

9
Te= ¢ x (Te+32)

3.4.4. \lolume

The standard unit of volume for the SI system is the liter. A liter is defined as
1,000 cubic centimeters. A liter isslightly larger than a quart.
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3.4.5. Weight and Force (Mass)

The U.S. Customary system (sometimes referred to as a gravitational system) isa
force-based system and the Sl ismass-based system. The key to understanding how
to solve problems in these two systems is to understand the relationship between
mass and force. The definition of mass was proposed by Sir Isaac Newton.

One useful definition of mass (Hibbler, R.C. Engineering Mechanics, 6th edi-
tion. Macmillan, New York) is “Mass is a property of matter by which we can
compare the action of one body with that of another. This property manifests it-
self as a gravitational attraction between two bodies and provides a quantitative
measure of the resistance of matter to a change in velocity.” This implies several
things. Gravity isaform of accel eration. Thus, massisindependent of gravity. This
means that your mass is the same on the earth, moon, or in rocket ship leaving the
earth. Your massis also the same in space orbiting the earth.

Mass can be determined by comparing an object of known mass to your object
whose mass is not known. One way to do this is to place the object with the
unknown mass in one pan of a balance scale and add objects of known mass in
the other pan until the scaleis balanced. Gravity isthe acceleration acting on both
pans of the balance scale. The balance scale will give the same resultsin the rocket
ship, on the earth or on the moon.

Force or weight changes with gravity or acceleration. You will weight about
1/6th as much on the moon as on the earth, because the force attracting you to the
moon, gravity is about 1/6th that of the earth’s gravity. In orbit about the earth,
where the net gravitational forceis zero, your weight is zero.

In this book we are primarily interested in force rather than mass. Sir Isaac
Newton's second law defines the relationship among mass (m), acceleration (a),
and force (F). Thiseguationis F = ma.

The Sl unit of force isthe Newton (N), the unit of massisthe kilogram, and the
unit of acceleration is meter/second? (m/s?). Inthe Sl system we specify the mass
of the object and calculated the weight. Since gravity isaform of acceleration, we
can rewrite Newton's second law as:

W = mg

where W isthe weight in Newtons (N) and g is the acceleration by gravity at the
earth’s surface, 9.81 m/s?.

Inthe customary system we measure the force in pounds and cal cul ate the mass.
The unit of massin the customary systemsisthe slug. Massiis calculated by:

w
m = T where W isthe weight in pounds (Ib) and g = 32.3 ft/s.

The relationship of mass and weight can be explained using an example of aclass
1 lever. Note: class one levers are explained in chapter 4. You are using aclass 1
lever to pry alarge rock from the ground. You push down on the end of the lever
with enough forceto rai se your feet off the ground and the rock doesn’t move. You
have recently “weighed” yourself on a metric scale and your mass is 81 kg. The
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forcearmlength is 1.5 m and the resultant arm length is 0.3 m. What isthe weight
of the rock?

Thefirst step in determining the weight of the rock isto convert your body mass
to weight.

W=mxg

m kgem
— = 794.61
& &

The second step is to calculate the weight of the rock using the formula for a
class 1 lever and solving for F;.

Fax Aa=F x A

=795N

W = 81kg x 9.81

The equation for aclass 1 lever iswritten in terms of aforce, but weight isaforce
SOFy, =W

FF=W Aa
= X —
r A,
15m 11925
F = 795N x =0 — 22922 _ 3975 or 4,000 N
r “03m_ 03

The weight of the rock is greater than 4,000 N or 4 kN.

3.4.6. Pressure

Pressureisforce per unit area. Inthe S| system acombination of force and areacan
be used, but the preferred unit is Newtons per meter squared (N/m?) or commonly
called Pascals (Pa). Therefore,

N

1~ =1Pa
m

3.4.7. Time

The units used to measure time are the same for both the customary and Sl units.

3.4.8. \Velocity, Speed, and Acceleration

Velocity and speed are measured by determining a distance and the time it takes
to travel adistance. For vehicles the standard unit for distance in the Sl system is
kilometersand the standard unit for timeishours, thereforethe Sl unitsfor velocity
are meters per hour (km/hr). Acceleration is the rate at which velocity changes.
The unitsin the S system are m/s/s or m/s?. The units of acceleration in the U.S.
Customary system are ft/s/s or ft/s?.

3.4.9. Power

Power is the rate of doing work and work is force times a distance. In the Sl
system force is measured in units of Newtons and distance in meters, except for
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vehicleswherethe distanceisin kilometers. This meanswork is measured in units
of Newton - meters. Thisis an acceptable unit of measure for work, but for many
calculations the preferred unit is the joule. One joule is the amount of work done
when an applied force of 1 Newton movesthrough adistanceof 1 minthedirection
of the force.

The units for time are the same, therefore in the SI system power could be
measured in units of joules per hour. This measurement of power is not usually
used, instead the preferred unit of measure for power in the SI system is the watt.
One watt is equal to 1 joule per second.

3.4.10. Torque

Torgue is a measure of aforce working through alever. In the Sl system forceis
measured in Newtons and distance is measured in meters. The unitsfor torque are
Newton - meters (N - m).

3.4.11. Horsepower

The Sl unit system does not have a comparable conversion from power to horse-
power. Inthe Sl system Watts are used to measure power and the appropriate prefix
is used. For many agricultural problems using the unit of Watt results in alarge
number, therefore it is customary to use the unit of kilowatt (kW).



4
Simple Machines

4.1. Objectives

1. Be able to explain the common simple machines.
2. Be able to give an example of each type of simple machine.
3. Beable to use the principles of simple machines to solve problems.

4.2. Introduction

A machineis any device that either increases or regulates the effect of a force or
produces motion. All agricultural machines are composed of combinations and
modifications of two basic machines, the lever and the inclined plane. We will
study the basic principles surrounding these two machines and illustrate some of
their common modifications and uses. (Note: In thefollowing discussion of simple
machines two assumptions are made: |osses due to friction are ignored, and the
strength of the materialsis not considered.)

43. Lever

A lever isarigid bar, straight or curved, capable of being rotated around a fixed
point (fulcrum). When afulcrum and a bar are used, two different forces exist, the
applied force (F,) and the resultant force (F;). Theforces, bar, and fulcrum can be
used in three ways, called classes, Figure 4.1.

FIGURE 4.1. Three classes of levers.

36
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The principle of levers can be expressed mathematically as:

Force Arm Force Arm
X = X
Applied Applied Resultant Resultant

Fax Aa=F x A

4.3.1. Class One Lever

Classoneleversareused primarily for their mechanical advantage. The mechanical
advantage for a first-class lever is the ratio of the lengths of the two arms. In
our discussion of simple machines, mechanical advantage will be defined as the
increase of force that occurs through the use of a lever. Expressed mathemati-
caly:

F length
Mechanical advantage = orce am 'eng
Resultant arm length

The principles of aclass one lever areillustrated by the problem in Figure 4.2.

Problem: How much weight can a 140.0-1b person lift with aclassonelever if the
force arm is 4.0 ft long, and the resultant arm is 1.0 ft long?

Solution: In this problem three of the variables are known: F, = 140 Ib, A; =
4 ft, and A, = 1 ft. To solve the problem, we must use one of the techniques of
problem solving—rearranging an equation. In this example we need to rearrange
the equation to solve for F; and then insert the values.

Fax Aa=F x A

Fax Ay 140.01b x 4.0 ft
F = = =5601b
' A 1.0ft

[Note: Inthisexampletwo significant figureswere used. Thisisan examplewhere
the significance of the zero in the number would be ambiguous unless the reader
had excess to the entire problem. To remove this ambiguity the answer should be
written as 5.5 E2.]

FIGURE 4.2. Example of class one lever.
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FIGURE 4.3. Example of the use of aclass one lever.

With this lever, 140 Ib of applied force is capable of lifting 560 Ib. This
demonstrates the mechanical advantage of the class one lever. The source of the
mechanical advantage is clearer if the equation iswritten as:

4.0ft
1.0ft

When the equation is arranged in this manner, it is easy to see that theincreasein
force or mechanical advantage is the ratio of the lengths of the two arms. In this
example, the amount of force the person could produce (mechanical advantage)
was increased 4/1 or 4 times.

In addition to the mechanical advantage, the distance moved and the speed
of movement for the two ends of the bar also can be determined. Calculations
will show that the distance moved is proportional to the ratio of the length of
the resultant arm to the length of the force arm. The speed of movement is pro-
portional to the ratio of the length of the force arm to the length of the resultant
arm.

An example of the use of a class one lever is a wrecking bar pulling a nail,
Figure 4.3.

Fr = 140.0lb x

4.3.2. Class Two Lever

The second class of lever also produces a mechanical advantage. In this lever the
mechanical advantage is the ratio of the distance between the fulcrum and the
applied force and the distance from the fulcrum to the resultant force, Figure 4.4.
The same applied force is used to illustrate this lever.

FIGURE 4.4. Example of classtwo lever.
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FIGURE 4.5. A two-wheeled dolly as a class two lever.

Using the lever equation, rearranged for the unknown value, determines the
resultant force for the applied force:
Fax Aa=F x A

e Fax A; _ 140.01b x 5.0ft
oA 1.0t

=700lbor70E21b

For the class two lever the mechanical advantage will always be greater than one.
In this case the mechanical advantageis 5 divided by 1 or 5. Thisiswhy a 700-Ib
load can be moved with only aforce of 140 Ib supporting the load at the end of
the fulcrum.

In the class two lever the distance moved and speed of movement also are
proportional to the ratio of the lengths of the two arms.

A common use of aclasstwo lever isthe wheelbarrow, Figure 4.5.

It isimportant to remember that the determination of the class of lever is based
on the location of the fulcrum, the length of the applied force arm and the length
of the resultant force arm. If the relationship of these three components changes,
the class of lever will change. A simple machine, like a two-wheeled dolly, can
act asaclass one or class two lever. Figure 4.6 shows that when the center of the
mass is to the right of the fulcrum (axle) the dolly acts as a class one lever.

When the center of mass moves to the left of the fulcrum (axle) the dolly will
behave as a class two lever, Figure 4.7.

Also note that the direction of the force on the handle changes. When used as
aclass one lever, the operator must provide a constant pull on the handles. When
used as a class two lever, the operator must lift up on the handles.

4.3.3. Class Three Lever

The class three lever does not have amechanical advantage. It isprimarily used to
increase speed and movement. The same applied force and distances are used to
illustrate a class three lever, Figure 4.8.
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FIGURE 4.6. Example of class
two lever in use.

FIGURE4.7. A two-wheeled dolly
asaclasstwo lever.

FIGURE 4.8. Example of classthree lever.
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FIGURE 4.9. Class three lever with split measure-
ment of length.

FIGURE 4.10. Example of the use of
classthreelever.

The resultant force for a class three lever is determined by rearranging the lever
equation and inserting the values;

Fax Aa=F x A

F— Fax Aa _ 140.01b x 1.0ft _281b

A 5.0ft
As this example illustrates, the mechanical advantage for the third-class lever
aways will be less than one. Here 140 Ib of applied force only can lift a weight
of 28 Ib. The distance moved and the speed of movement of the resultant point
compared to the applied point isincreased proportionally.

It isimportant to remember that when al three levers are used, the two lengths,
applied and resultant, are measured from the point of application to the fulcrum.
In both the classtwo and three levers, the length of the applied arm or the resultant
arm may be broken into two measurements, see Figure 4.9.

In Figure 4.9, the length of the resultant arm is 5 ft because the distance is
measured from the point of application to the fulcrum.

A common useof theclassthreelever isthe3-point hitch on atractor, Figure4.10.

4.4. Wheel and Axle

A wheel and axle behave as a continuouslever. The center of the axle corresponds
to the fulcrum. A wheel and axle has a mechanical advantage if the radius of the
wheel isthe applied arm and the radius of the axle isthe resultant arm. It does not
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FIGURE 4.11. Illustration of wheel and
axle.

have a mechanica advantage when the wheel radius is the resultant arm and the
axleradiusisthe applied arm, Figure 4.11.

The equation for determining the mechanical advantageisthe same asthe equa
tion used for the three classes of levers.

Problem: How much force will it take to lift a 10.0-Ib weight with a wheel and
axle, used asin Figure 4.11, when the axleis 2.0 inchesin diameter, and the wheel
is10.0 inchesin diameter?

Solution: Thefirst step isto rearrange the equation to solve for the applied force.
Remember that the length of the force arm istheradius of thewheel and thelength
of theresultant arm is the radius of the axle. This gives us:

Fax Aa=F x A

Frx Ar  10.0lbx 5.0in
Fa= = =2501b
2 Aq 2.0in
The wheel and axle is not normally used alone. It is usually used in conjunction
with a gear reduction system to form a hand operated or electric motor winch

found on boat trailers and other applications, Figure 4.12.

FIGURE 4.12. Wheel and axle used as a winch
without a gear reducer.
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FIGURE 4.13. A single pulley.

4.5. Pulley

A pulley isamodification of afirst or second class lever. A single pulley does not
produce any mechanical advantage, just achange of directioninforce, Figure4.13.

If the power lossto friction is not ignored, then asingle pulley has amechanical
advantage of less than one. When pulleys are combined in pairs, a mechanical
advantage is produced. This use of pulleysis commonly called ablock and tackle,
Figure 4.14.

FIGURE 4.14. Block and tackle.
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The amount of mechanical advantage produced by a block and tackle is pro-
portional to the number of ropes that support the weight. The block and tackle in
Figure 4.14 has four ropes, but only three, Rg, R¢, and Rp, support the weight. In
this arrangement the amount of weight that can be lifted is three times the amount
of force being applied. Expressed mathematically:

W

Rn:?

where W = Amount of weight to be lifted; F = Amount of force applied to the
block and tackle; R, = Number of ropes.

Problem: How much pull (pounds of force) would it take on the block and tackle
ropein Figure 4.14 to lift a 545-1b ball?

Solution: From Figure 4.14, the number of ropes supporting theload isthree. The
pull can be found by rearranging the pulley equation to solve for F:

= w = ﬂlb = 181.666. .. or 182 Ib.
Rn 3

With a three rope, block and tackle, 182 Ib of force will lift a 545-1b load, but
the rope where the force is applied will move a three times the distance the load
MOVES.

F

4.6. Inclined Plane

An inclined plane is an even surface sloping at any angle between vertical and
horizontal. An inclined plane produces a mechanical advantage. The amount is
determined by theratio of thelength of theinclined planeto thechangein elevation.
Instead of lifting the entire weight vertically, part of the weight is supported by the
inclined plane.

Compare drawings | and Il in Figure 4.15. Intuitive reasoning suggests that if
the weight being moved and the distance AC are the same in both cases, then less
force (ignoring friction) will be required to move the wagon up the inclined plane
in the situation represented by drawing | because the change in height islessin |
thanitisin Il for the samelength of inclined plane. If we need to know the pounds
of force required to pull the wagon, then we must use an equation based on the

FIGURE 4.15. Two inclined planes.
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principles of an inclined plane. Expressed mathematically:
F x AC =W x BC

where F = Amount of force to pull the wagon (ignoring friction); AC = Length of
theinclined plane; W = Weight of the wagon; BC = Height of the inclined plane.
If we analyze drawing I, Figure 4.15, first and assume that the total weight is
100.0 Ib, the height (BC) is 2.0 ft, and the length of the inclined plane (AC) is
12.0 ft, then the amount of force that would be required to pull the wagon up the
inclined planeis:
E_ W x BC
AC
Substituting the values gives:
100.01b x 2.0ft
B 12.0ft
Now we can see if the conclusion was right about the situation in drawing I1. We
will use the same equation to calculate the force in this situation. If we assume the
length of the plane is the same (AC), then:
100.01b x 4.0 ft
B 12.0ft

It thus is obvious that an inclined plane with a steeper angle will require more
force for the same weight.

= 16.666... or 171b

=33.33... or33Ib

4.7. Screw

The screw is a modification of the inclined plane combined with a lever. The
threads of ascrew or abolt are aninclined plane that has been rolled into the shape
of acylinder. A lever is used to turn the threads, which causes the load to move
aong the cylinder. An example of this principle isthe screw type jack.
Figure4.16 illustratesthis principle asit isused in ajack, where thejack handle
is the force arm. The same principle applies to a bolt and nut. In the case of a

FIGURE 4.16. Lever equation applied to a screw
jack.
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bolt and nut the lever arm is the wrench, and the resultant force is the clamping
pressure.

The distance between any two threads, called pitch, determines the amount of
movement per revolution. The mechanical advantage is determined by the ratio of
the radius of the lever and the pitch distance. The lever equation can be used to
express this relationship mathematically:

Fax Aa=F x A

where F, = Forced applied at the end of the lever arm; F, = Amount of weight
the jack will lift; Ay = Length of the lever arm; A, = Pitch of the threads.

Problem: If thelever arm in Figure 4.16 is 18 in long and the pitch of the threads
is 0.125 in, how much weight will the jack lift when 50.0 Ib of force is applied
(ignoring friction)?

Solution: Rearranging the equation to solve for F; gives:

_ Fax Aq _ 50.01b x 18.0in _ 72001bor 7.20 E3 b

F
' A 0.125in

This problem illustrates that when using a screw jack asmall amount of force will
lift alarge load. The disadvantage is that the load will only be lifted 0.125 inches
(1/8 of an inch) for every revolution of the handle.

Friction will affect the performance of this machine more than the others. With
the proper lubrication it can be kept to a manageable level.

4.8. Combining Machines

All agricultural machines are a combination of these five simple machines. The
analysis of the forces on a complex machine exceeds the objectives of this text,
but Figure 4.17 is an example of how two or more of these machines can be used
together.

Thisexampleisalso useful for discussing the problem solving process. Thefirst
inclination is to try and solve for the amount of weight first. If this approach is

FIGURE 4.17. Two machines working in combination.
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used it will soon become evident that an important piece of datais missing. What
is the value for the applied force? To solve this problem it is important to realize
that thefirst step is solving the amount of force produced by the jack.

Fax Aa=F x A;

. _ FaxAa_15041bx200ft _ 3008

T - =
At oe2Binx o 0052
12in

=5775.361b

[Note: in this example the answer was not rounded to the appropriate number of
significant figures because it is just the first step in amultiple step problem.]
Ignoring friction and the strength of the material's, thejack will beableto produce
5,775.36 Ib of force. The force produced by the jack is the applied force for the
lever. The amount of weight that can be lifted by the lever is determined by:

Fax Aa=F x A

Fax Ay 5775.361b x 2.76ft  15939.9936
= a 073 = 073 = 21835.607 ...
or22,0001b

Themachinesintheillustration are capabl e of lifting 22,000 [b with an application
of 150.4 Ib on the jack handle.

4.9. Metric Problems

The procedure for solving lever and problems involving forces can be illustrated
with the following example. You are using the 3-point hitch on a tractor to lift a
large bale of hay. You have recently “weighted” the bale on a metric scale and its

FIGURE 4.18. Illustration of bale problem.
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mass is 840 kg. The lift arm is attached to the lower arm of the hitch 0.5 m from
the pivot point and the length of the lower hitch arm is 0.95 m. How much force
must be produced by the lift arms of the 3-point hitch to raise the bale?

Thefirst step in determining the required amount of force to raisethe baleisto
convert its mass to weight.

Weight (W) = mass(m) x gravity (g)
— 840kg x 9.81 g
= 8240.4 N

The second step is to calculate the required force using the equation for a class
three lever. The equation for a class three lever is written in terms of a force or
weight of an object, F, = W. Thisis an example where a serious error can occur
because the actual length of the resultant arm is not the length of the lower hitch
arm, but the distance from the pivot point to the center of the mass of the bale,
Figure 4.18.

Assuming a 1.5 m bale and an additional distance of 25.0 cm from the end of
the lower lift arm to the front edge of the bale, the length of the resultant arm is:

1.5m
m=0.95m~|—0.25m+T =195m

Thelift arm force required is:

A 1.95m
Fa=W x — = 8240.4N x —— = 32137.560r 3.2 E4N
A 0.50m

a
The 840 kg bale will require the lift arms on the 3-point hitch to produce 3.2 E4
N of forceto lift the bale.
The same procedure can be used to solve any of the other problems in this
chapter.
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Internal Combustion Engines

5.1. Objectives

1. Be able to list and describe the events that occur in an internal combustion
engine.

2. Beableto describe how aspark ignition (Otto-cycle) enginediffersin operation
from a compression ignition (Diesel-cycle) engine.

3. Be ableto diagram and describe the events that occur in sequence during each
stroke of afour-stroke cycle engine.

4. Be able to diagram and describe the events that occur in a two-stroke cycle
engine.

5. Given the bore, stroke, number of cylinders, and clearance volume, be able to
calculate the piston displacement, engine displacement, and compression ratio
in both customary and Sl units.

5.2. Introduction

There are six primary sources of power in agriculture: human labor, domestic
animals, wind, flowing water, electricity, and heat engines. The primary sources
of power for modern agriculture are the internal combustion engine and electric
motor. Some day, the primary source of power may change to fuel cells, solar
energy, or atomic energy, but in theimmediate future the primary sources of power
for agriculture will continue to be internal combustion heat engines and electric
motors.

Internal combustion engines used for agricultural applications range from
those used for one-horsepower garden tools to the hundreds of horsepower
required for very large tractors. Because engines are very common, knowl-
edge of how and why they work is essential to a successful agricultural man-
ager. In this chapter, the basic engine types and functions are discussed, as are
some basic calculations concerning engine size (displacement) and compression
ratio.

49
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5.3. Theory of Operation

The function of all internal combustion engines is to convert fuel (chemical en-
ergy) to power. This is accomplished by burning a fuel in a closed chamber
and using the increase in temperature within the closed chamber to cause a
rise in pressure. The pressure produces a force on the head of the piston caus-
ing it to move. The linear movement of the piston is converted to rotary mo-
tion (at the crankshaft), Figure 5.1. Rotary motion is more useful than linear
movement.
All internal combustion engines have eight requirements for operation:

1) Air (oxygen) isdrawn into the engine cylinder.

2) A quantity of fuel isintroduced into the engine.

3) Theair and the fuel are mixed.

4) The fuel—air mixture is compressed.

5) The fuel—air mixtureisignited by the spark plug in gasoline engines or by the
heat of compression in diesel engines.

6) The burning of the fuel—air mixture causes a rapid pressure increase in the
cylinder, which acts against the piston, producing a force on the piston.

7) The use of a connecting rod and a crankshaft converts the linear movement of
the piston to rotary motion. The force on the piston is converted to torque on
the crankshaft.

8) The products of combustion are expelled from the engine.

The next sections illustrate two ways in which these events are arranged in—
four-stroke cycle and two-stroke cycle engines.

FIGURE 5.1. Parts of aninternal combustion gasoline engine.
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5.3.1. Four-Stroke Cycle

The four-stroke cycle engine, commonly called 4 cycle engine, is one of the two
common types of engine cycles used for both spark and compression ignition
engines. In 4 cycle engines, the eight events occur during four strokes of the piston
or two revolutions of the crankshaft. The four strokes are called:

1. Intake

2. Compression
3. Power

4, Exhaust

Study Figure 5.2 and the following description of the events. During the intake
stroke, the intake valve opens, and the piston travels from the top of the cylinder
(TDC) to the bottom (BDC). In both the spark and the compression ignition en-
gines, during the intake stroke, the movement of the piston reduces the pressure
inside the cylinder. Higher atmospheric pressure outside the engine causes air to
flow through the intake system and into the cylinder as the intake valve opens.
In the carbureted engines fuel isintroduced into the air stream asiit flows through
the carburetor. Shortly after the piston reaches the bottom of the intake stroke,
the intake valve closes, thus trapping the air—fuel mixture inside the cylinder. Any
restrictions in the flow of air into the engine reduces its volumetric efficiency.
Volumetric efficiency is the comparison of how much air flows into the cylinder
compared to the amount of air the cylinder can hold when it is totally full at
atmospheric pressure. Reduction in volumetric efficiency reduces the horsepower
produced by the engine. One common causeis adirty air filter.

The compression stroke follows. Because the air—fuel mixtureis trapped in the
cylinder, as the piston returns to the top of the cylinder during this stroke, the
air is compressed, and as it is compressed, the temperature rises. As the piston
nears the top of the compression stroke, ignition occurs. Pressure is the key for
converting the energy of the fuel to power. If any of the combustion pressure
escapes from the combustion chamber, less power will be produced. On engines
with a lot of hours and/or poor maintenance, the rings become less capable of

FIGURE 5.2. The four strokes of the four-stroke cycle.
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sealing the combustion chamber and some of the compressed gases blow by the
rings and into the crankcase.

The rapid expansion of the burning mixture causes the pressure to rise very
quickly. The rapid rise in pressure (Ib/in?) causes a force (Ib) on the face of the
piston,

F(b)="P (%) x A(in?).

Thispressureforcesthe piston away fromthecylinder head. Thisiscalled the power
stroke. It is during this stroke that the chemical energy of the fuel is converted to
power.

Before the piston reaches the bottom of the cylinder on the power stroke, the
exhaust valve opens, and the exhaust gases start to flow out of the engine. As
the piston returns toward the top of the cylinder, the remaining byproducts of
combustion are expelled from the cylinder through the open exhaust valve. This
is called the exhaust stroke.

At this point, the intake valve opens, and the process repeats. Four strokes of
the piston and two revolutions of the crankshaft have been completed.

5.3.2. Two-Stroke Cycle

In a two-stroke cycle engine (commonly called the 2 cycle engine) the eight re-
quirementsfor operation occur during two strokes of the piston and one revolution
of the crankshaft. Two very noticeable differences exist between a2 and a4 cycle
engine. Some variability exists in the ways 2 cycle engines are constructed, but
Figure 5.4 will be used to illustrate the primary functions of the common designs.
In the 2 cycle, the carburetor is attached to the crankcase, and there are no intake
and exhaust valves. Instead gases flow into and out of the cylinder through portsin
the cylinder wall as they are exposed and covered by the movement of the piston,
Figure5.3.

Study Figure 5.4 and the following description of events to understand the 2
cycle engine. In a 2 cycle engine, intake and exhaust occur at almost the same
time. The description of the cycle starts after combustion. As the piston moves
away from the cylinder head, it first exposes the exhaust port. The combustion
pressure starts the process of expelling the gases. As soon as the piston moves
away from the cylinder head, the reed valve closes. This causes the crankcase to
become pressurized. Asthe piston continuestotravel it exposestheintake port. The
pressurized air—fuel—oil mixturein the crankcase flowsinto the cylinder. Thisflow
deliversthe next fuel—air charge for combustion and hel ps expel the exhaust gases.

As the piston continues toward the cylinder head, the intake port is closed and
then the exhaust port isclosed. Assoon astheintake port is covered, the continuing
movement of the piston lowers the pressure in the crankcase, and the air—fuel—oil
mixture flows from the carburetor, through the reed valve, and into the crankcase.
As soon as the exhaust port is closed and the piston continues to move toward the
cylinder head, compression occurs.



Theory of Operation 53

FIGURE 5.3. Parts of atwo-stroke cycle engine.

The spark plug fires, the piston reaches top dead center (TDC), burning occurs,
and pressure builds rapidly in the cylinder. Thisis called the ignition and power
event. As soon as the piston moves away from the head far enough to expose the
exhaust port, the cycle begins again.

If you count the movements of the piston, you will find that it has traveled
two strokes or one revolution of the crankshaft. Because both the exhaust and the
intake processes are not as efficient as in the 4 cycle engine, the 2 cycle engine
will produce less power per stroke. However, because it has a power event each
crankshaft revolution, the total power produced by the engine is comparable to
that of a4 cycle engine.

FIGURE 5.4. Two stroke cycles.
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5.4. Types of Engines

The two primary categories of engines are the spark ignition (Otto-cycle) and
the compression ignition (Diesel-cycle). In the spark ignition engine, the fuel is
metered andintroduced intotheengineby either acarburetor or aninjection system,
Figure 5.5. When a carburetor is used, the fuel is metered by jets and orificesin
the carburetor and added to the air asit flows through the venturi of the carburetor.
Mixing occurs as the fuel—air mixture moves through the intake system and into
the cylinder. A spark plug ignites the fuel—air mixture at the proper time.

Fuel injection systemsimprove the fuel efficiency of a gasoline engine because
the multiple sensors and computer can better match the fuel needs of the engine.
Historically the additional cost of the system over a carburetor fuel system has
limited its use to larger, multicylinder engines, but rising fuel costs and emission
standards have been theimpetus for increasing the use of fuel injection systemson
smaller engines. An engine that usesinjection does not have a carburetor; the fuel
is usually injected into the air stream at the throttle body or intake port. In some
engines, asingleinjector islocated at thethrottle body (throttle body injection) that
replaces the carburetor. Thissingleinjector metersthefuel for all of the cylinders.
In the port injection system, an injector is positioned just outside the intake valve
(port) leading into each cylinder. The injector in conjunction with the injector
pump meters and delivers the required amount of fuel to the cylinder. The fuel
and air are mixed asthey flow into the cylinder. Engineers are continuing to work
on direct inject for gasoline engines and the technology is starting to be used in
automobile engines.

In a compression ignition engine (Diesel) the fuel is injected directly into the
combustion chamber, Figure 5.6. The injection istimed to occur just before TDC
on the compression stroke. Combustion occurs amost instantaneously because
compression causes the air temperature within the combustion chamber to rise to
1,000°F and above. Thus, thereis no need for a spark plug to ignite the fuel. The
injector pump controls the amount of fuel delivered to each cylinder.

FIGURE 5.5. Throttle body and port injection.
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FIGURE 5.6. Parts of diesel engine.

5.5. Displacement

Displacement isthe cylindrical volume that a piston displaces asit moves through
onestroke. Itisequal to the areaof the piston multiplied by thelength of the stroke.
Displacement is one of the factors that determine the amount of horsepower an
engine will produce, the greater the displacement, the greater the volume of air
and fuel that is burned during combustion, which means more power. Expressed
mathematically, piston displacement is:

7 x B2
4

where PD = Piston displacement in cubic inches (in®); B = Bore of cylinder
(diameter), ininches (in); S = Stroke of piston in inches (in).

The bore and the stroke of an engine has been traditionally expressedas B x S
withthedimensionsininches. Thus, if B x S = 3.50 x 4.00, the piston displace-
ment is:

PD = xS

7 x B2 7 x (3.50in)?

4 4
Larger engines are constructed with more than one cylinder. For multicylinder
engines, the term engine displacement (ED) is used. Engine displacement is the
product of the cylinder displacement times the number of cylinders. Expressed in
equation form:

PD = x 4.00in = 38.484. .. or 38.5in°

ED=PD x n

where ED = Engine displacement (in®); PD = Piston displacement (in); n =
Number of cylinders.
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If the enginein the previous example is afour-cylinder engine, then the engine
displacement is:

ED=PD xn =385x 4=154in°

It is a common practice to combine these two equations. For a single cylinder
enginethevaueforn = 1.

_ansz

ED = XN
4

5.6. Compression Ratio

The compression ratio isthe ratio of the total volumein acylinder to the clearance
volume. The clearance volumeisthe volume of the combustion chamber when the
piston isa TDC, Figure 5.7. The total volume is the clearance volume plus the
displacement.

The compression ratio is an engine characteristic related to engine efficiency,
that is, the ability of the engine to convert energy in the fuel to useful mechanical
energy. Thegreater the compression ratio, the greater the potential efficiency of the
engine. The maximum compression ratio that can be obtained is a function of the
type of fuel and the physical strength of the engine components. A compression
ratio of 7to 8:1iscommon for gasolineenginesand aratio of 15to0 22:1iscommon

for diesel engines.
Expressed mathematically compression ratio is:
PD
crR= P +CV
Ccv

FIGURE 5.7. Cylinder clearance volume.
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where CR = Compression ratio; PD = Piston displacement (in®); CV = Clearance
volume (in%).

Problem: What isthe compression ratio for asingle cylinder enginewithaB x S
of 3.25 x 3.75 and a clearance volume of 6.20 in3?

Solution: Thefirst step isto calculate the displacement:

B2 3.14 x (3.25in)? .
TXD i Sxn= # % 3.75x 1 =31.093... or31.1in3

PD =

Then the compression ratio is:

31.1in®+6.2in°
CR = n —|.-3 n
6.21n

Notice that the answer has no units. To have aratio the unitsin the numerator and
the denominator must be the same; thusthe units cancel each other. A compression
ratio of 6.0 would be expressed as 6.0:1.

=6.0asaratio 6.0:1

5.7. Theoretical Power

In the previous chapter, theoretical power was defined as the calculated horse-
power based on the bore, cylinder pressure, and engine speed. Figure 5.8 shows
atypica cylinder pressure curve for a naturally aspirated engine. During the in-
take stroke the pressure is below zero, atmospheric. The pressure starts to rise
as the compression stroke occurs and jumps rapidly at combustion. During the
power stroke and exhaust stroke, the cylinder pressure gradually drops back to
zero. The average pressure for the complete cycle is used to calculate engine
power.

The theoretical or indicated engine horsepower can be determined using the
mean effective cylinder pressure (MEP). The indicated or theoretical power isthe
power produced in the engine by combustion of the fuel. It does not account for
the power lost to friction and other losses. The MEP can be determined from the
graph, but these calculations are beyond the math level for thistext. The equation
for calculating indicated engine power in units of horsepower for 4 cycle engines
is

_ PxSxAxN
"= 7733000 x 2

The equation is changed for 2 cycle engines:

£ _ PxSxAxN 0
Y
where P = Mean effective pressure (psi); S = Stroke (ft); A = Cylinder area
(in?); N = Enginespeed (rpm); n = Number of cylinders. Note: the dimension for
strokein this equation isfeet to cancel out the units of feet in the 33,000 constant.
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FIGURE 5.8. Cylinder pressure example.
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Problem: Determine the indicated horsepower for a four cycle single cylinder
engine, that has a mean effective pressure of 152.0 psi. The bore is 2.75 in, the
stroke is 2.65 in, and the engine speed is 3,000 rpm.
Solution: The engine power for 4 cycle engines can be calculated using the fol-
lowing equation:

PxSxAxN

Ep= > XAXE
hp 33000x2

Ib 1ft 2.75in\?
152.0 — x (2.65in x —— ) x (7 x ! « 3,000 rpm
in? 12in 2

33,000 x 2
152 x 0.22083. .. x 5.939... x 3,000

66,000
=9.0623... or 9.06 Ehp

x 1

_ 598115.0626
- 66,000

5.8. Metric Problems

The unit of engine power in the Sl system is the kiloWatt. Piston bore and stroke
are measured in millimeters. Displacement is reported in liters. One liter is equal
t0 1,000 cm? or 1,000,000 mm?®. Pressureis measured in kiloPascals. The equation
for engine power in kW is:
PxSxAxN

60,000 x 2

P = pressure (Pa), S = stroke (m), A = piston area(m?), N = speed (rpm).

Ekw =

Problem: Determine the indicated engine power for an engine in units of kW,
that has a mean effective pressure of 1,050 kPa. The engine is afour-stroke cycle
engine and hasthree cylinders. The bore (B) is 109 mm, the stroke (S) is115 mm,
and the speed is 3,000 rpm.

First convert the unitsto base Sl units

1
P = 1,050 kPa = 1,050 kPa x ,000 Pa = 1,050,000 Pa
1 kPa
B = 109 mm = 109 mm x — " 0.109 m
= fred X —m8M8M8M = .
1, 000 mm
S = 115mm = 115 mm 71 m 0.115m
= frd X = .
1, 000 mm

Next calculate the area of the piston:

B2 0.109 m)?
A(mz)znsznx%

= 0.0093313. .. or 0.00933 m?
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Finally determine the power (KW):

£ _ PxSxAxN 0
W= TT80,000 x 2
1.050 E6 Pa x 0.115 m x 0.009331. .. m? x 3,000
- min , 3
120,000
_3380269.069
120,000

= 28.163... or 28.2 kW

Problem: Calculate the compression ratio for the engine in the previous problem
if the clearance volumeis 0.063124 L.

Solution: Since we are calculating aratio any consistent set of units can be used.
Engine displacement is usually expressed in liters, therefore is this example the
displacement is converted to liters because the clearance volume is in units of
liters.
Start by calculating the piston displacement:
B? 1L

PD(L) = S 2=
(L) =Sx7mx Z X 1o 3

B (0.109 m)?2 1L

= 0.115m x 3.1416 x 2 X T0E 33
_0.00429240516

~ 40E-3

=10731... or 1.07L

Next calculate the compression ratio:

_PD+CV
e

_ 1.07L +0.063124 L
- 0.063124 L

1133124
" 0.063124

=17950... or 18tol.

CR
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Power Trains

6.1. Objectives

. Be able to describe mechanical, pneumatic, and hydraulic power trains.

. Be able to determine the appropriate size for a pulley, sprocket, or gear.

. Be able to use speed ratios to determine pulley, sprocket, and gear sizes.

. Beableto determine the speed and direction of rotation at any point in a power
train.

. Understand the rel ationship between speed and torque.

. Be able to determine the torque and power at any point in a power train.

7. Be able to calculate the movement and changes in force for a hydraulic power

train.

A WN PP

(o2 )

6.2. Introduction

In some applications, such asapush lawn mower with avertical crankshaft engine,
the power isused at thelocationthat it is produced. The bladeisattached directly to
the end of the crankshaft. M ost machines require amore complex system for trans-
porting the power from the source to the load. In addition, many machines require
that the power produced by the motor or engine be modified and/or transported
to another part of the machine. These modifications could include changing the
speed of rotation, direction of rotation, and location of the power. The collection of
machine components that are used to accomplish this are called the transmission,
power train, or drivetrain. In complex agricultural machines, such as a combine,
the power must also be modified several times to meet the needs of the different
machine components.

Thetransportation of power can be accomplished using mechanical, pneumatic,
hydraulic, or electrical systems. Mechanical systemsarevery different so they will
be discussed separately. Hydraulic and pneumatic systems have enough similari-
tiesthat they will be discussed together. Electrical systemswill not bediscussed in
this text. Each of these systems use a different means for completing the modifi-
cations and delivery of the power and each has advantages and disadvantages. The

61
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remaining sections of this chapter will explain how these power transfer systems
work. Note: none of the systems are 100% efficient in the transfer of power, but
energy losses will be ignored during the following sections to make it easier to
understand how each system functions.

6.3. Mechanical Systems

Mechanical power systems are composed of pulleys, sprockets, gears, bearings,
shafts, and numerous other components that are used to deliver power to the
individual components of a machine and to change it to meet each component’s
requirement. Changes in speed, direction of rotation, or torque may be needed.
The next sections illustrate some of the principles of mechanical power trains and
provide examples of how these principles are used.

6.3.1. Pulleys

V-pulleys or sheaves are used in conjunction with V-belts because the V shape of
the belt wedges in the V shape of the pulley. This increases friction between the
belt and the pulley, which results in greater allowable power transmission. A belt
drive will always have at least two pulleys, the driver and the driven. Consider
Figure 6.1, which represents two pulleys mounted on shafts and connected by a
belt.

Whenweapply torquetothedriver shaft and causeit to turn or rotate asindicated
by the arrow on the driver pulley in Figure 6.1, atension or force will be created
in the belt. If the tension exceeds the load (torque) of the driven pulley and the
friction of the drive train, it will cause the driven pulley and shaft to turn. Drive
trains using belts and pulleys may contain more than two pulleys. If more than two
are used, one will be the driver and the others will be driven.

If the driver pulley in Figure 6.1 has a diameter of 10.0 in and rotates at 100.0
revolutions per minute (rpm), and the driven pulley hasadiameter of 5.0in, wecan
determine the speed of the driven pulley (and the shaft it is attached to) because

FIGURE 6.1. Parts of aV-belt system.



Mechanical Systems 63

the diameter of the driver pulley times the speed of the driver pulley is equal
to the diameter of the driven pulley timesthe speed of the driven pulley. Expressed
mathematically the pulley equation is:

D1XN1=D2XN2

where D = Diameter of apulley; N = Pulley speed in revolutions per minute.
This statement is true because the linear speed (feet per minute) of the belt
remains constant. If we identify D; asthe diameter of the driver pulley and D, as
the diameter of the driven pulley, we can determine the speed of the driven pulley
by rearranging the pulley equation.
Dl X Nl D1

or — x N1

N
2 D> D>

Using the example problem:

N 10.0in x 100 rpm
2= 5.0in

When you understand the pulley equation, you should be able to state with confi-
dencethat whenthedriven pulley issmaller than thedriver, the speed will increase,
and when thedriven pulley islarger than thedriver is, the speed will decrease. Thus
by visual inspection and intuitive reasoning you should be able to tell if apulley
drive train will increase or decrease the speed. To determine the actual amount of
change, use the pulley equation.

One application of this principle is represented in the fan drive in Figure 6.2.
Large ventilation fans of this type are commonly used in greenhouses, livestock
buildings, and other agricultural applications.

= 200 rpm

Problem: Assume that you have a fan and an electric motor, but no pulleys. The
fan is designed to operate at 500 rpm, and the electric motor operatesat 1725 rpm.
What sizes of pulleys will be needed to operate the fan?

Solution: Firgt, intuitive reasoning tellsusthat alarge changein speed will require
alarge difference in pulley diameters. Second, we know that the pulley equation

FIGURE 6.2. Determining unknown pulley size.
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includes four variables, and at this point we only know two, the pulley speeds. To
find a solution we must select one of the pulley sizes and then determine the other.

We could begin by selecting a pulley for the fan, but because the fan speed
(driven) islessthan the motor speed (driver), we know that the pulley on the motor
will be smaller than the pulley on the fan. If we selected a pulley for the fan that
istoo small, the calculated pulley size for the electric motor may be smaller than
what is physically possible. Therefore, begin by selecting the pulley size for the
€lectric motor, and then cal culate the required pulley size for the fan. If we select
a2.5-in pulley for the motor, then the size of the fan pulley can be determined by
rearranging the pulley equation:

Di(motor) x N 2.501in x 1725 rpm

5
D, (f = = =862i 8-
2(fan) N, 500 rpm inorg ¢ in

Because pulleys are manufactured with diametersin increments of fractions of an
inch, an 8 and 5/8-in pulley probably would be used.

Note that the ratios of the pulley diameters, D,/D1, will be equal to the ratios of
the pulley speeds, N1/N, = 3.45. Thus, if for any reason the 2.5-in pulley for the
motor is not available, any combination of pulley diameters with a ratio of 3.45
(or approximately 3.5) will provide the correct speed. For example, pulleys with
diametersof 8.625 and 2.5 or 17.25 and 5.0 or 34.5 and 10.0 will produce the same
change in speed. This ratio of two pulleys is called the speed ratio and it will be
discussed in more detail later in this chapter.

6.3.2. Sprocket Sizes

Roller chainsand sprockets, Figure 6.3, havetwo advantagesover beltsand pulleys.
They are capable of transmitting greater amounts of power, and because it is
impossible for the chain to dlip, the sprockets stay in time.

The equation used with pulleys can be used to determine sprocket sizes by
replacing the diameter of the pulley with the teeth for each sprocket. For sprockets,

FIGURE 6.3. Roaller chain and sprockets.
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the pulley equation becomes:
T]_ X N]_ = T2 X N2

Problem: A hydraulic pump will be powered by a tractor power take-off (PTO).
The pump must turn at 2100 rpm, and the PTO operates at 540 rpm. What sizes
of sprockets are needed?

Solution: This problem is the same as the previous one where we determined the
size of pulleys needed to power the fan. Thefirst step isto select the size of one of
the sprockets. In thisexamplethe driven sprocket (pump) will havefewer teeththan
the driver sprocket (PTO). For this example, we will start by selecting an 18-tooth
sprocket for the pump. We need to determine the size of the PTO sprocket.

Rearranging the sprocket equation for the number of teeth in the driver sprocket
giveus:

_ Tax Ny 18 teeth x 2,100 rpm

= 70teeth
N1 540 rpm

T1

The pump will turn at the correct speed if the PTO sprocket of the tractor has
70 teeth.

6.3.3. Gear Sizes

It is common to use gears in power trains when the shafts are very close together,
when a large amount of power is being transmitted or in transmissions where
selectable speed ratios are needed. The sizes of gears are determined in the same
way as those of chains and sprockets. The sprocket equation can be used without
modification.

6.4. Speed Ratios

In some situations when the speeds of the driver and driven shafts are known,
pulley, sprocket, and gear sizes can be determined by using speed ratios instead of
the pulley or sprocket equations.

In the previous problem we determined that a 70-tooth sprocket was needed to
power the pump. A 70-tooth sprocket will have a large diameter and may be too
large to fit on asmall tractor. Does this mean that the pump cannot be used?

The solution is to use a smaller sprocket on the pump and then determine the
size of sprocket needed for the PTO. In the original problem we saw that a 18 and
70-tooth sprockets would provide the correct speed. Thus we know that the ratio
of the two sprockets is 70/18 or 3.9:1. In other words, the sprocket on the PTO
must have approximately four times as many teeth as the sprocket on the pump.
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With the speed ratio between the two shafts known, different sprocket combi-
nations could be used:

T, 70 35 43 3.9

T, 18%9%11™"
In these situations the ratio does not usually need to be exact for the system to
operate. A hydraulic pump that runs dlightly faster or slower, because the exact
speed ratio cannot be used, usually performs adequately.

Knowing the speed ratio makesit easier to select sprocket combinationsthat will

operate the pump at the correct speed and till fit within the physical limitations
of the machine.

6.5. Direction of Rotation

In the previous section the examplesillustrated that one use of power trainsisto
change the speed between two or more shafts or components. Another function of
mechanical power trainsisto changethedirection of rotation. In many applications,
a shaft or component may need to turn in the opposite direction as the driver.
The two directions of rotation are labeled clockwise (CW) and counterclockwise
(CCW) when viewed from the end of the shaft. The direction of rotation can be
changed through the use of belts and pulleys, chains and sprockets, and gears.
Each of these methods will beillustrated.

6.5.1. Belts and Pulleys

Two different techni ques can be used to changethedirection of rotation, Figure 6.4.

Notice that twisting the belt changes the direction of rotation. This technique
is acceptable if the pulleys are some distance apart, the belt is operating at slow
speed and it is not transmitting a large load. The belts will rub at the center and
thesethree conditionswill increase the amount of friction at that point. Thefriction
produced from rubbing will shorten the life of the belt.

The addition of athird pulley also will reverse the direction of rotation. In this
situation, a six-sided, or double-V, belt will be used if the third pulley requires a
lot of torque, if not, aflat pulley will be used that runs on the back side of the belt.
Thisis very common in serpentine drives used on modern automobiles.

FIGURE 6.4. Changing the direction of rotation using belts.
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FIGURE 6.5. Changing the direction of rotation with aroller chain and sprockets.

The use of the third pulley also provides an opportunity to change the speed
of rotation. A difference in diameter between the third pulley and the driver will
cause a change in speed.

6.5.2. Roller Chains and Sprockets

Figure 6.5 shows that chains and sprockets can be used to reverse the direction
of rotation. Because roller chains cannot be twisted, changing the direction of
rotation requires the use of athird sprocket. Changing the number of teeth in the
third sprocket also allows the third sprocket to turn at a different speed.

6.5.3. Gears

Gearsare uniquein that each pair will change the direction of rotation, Figure 6.6.

FIGURE 6.6. Changing the direction of
rotation with gears.
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6.6. Complex Power Trains

Many machines use power trains that are more complex than what has been dis-
cussed up to this point. Figure 6.7 represents a power train designed to alow an
engine or motor to supply the power for two different components. These compo-
nents are attached to output shafts A and B. This figure illustrates the application
of direction and speed of rotation for more complex power trains.

Problem: What are the speed and the direction of rotation of shaft A and shaft B
in Figure 6.7?

Solution: In this power train the output shaft of a 50-horsepower motor powers
gear 1. Gear 2 is powered by gear 1, and because gear 3 is attached to the same
shaft, it is also powered by gear 1. Gear 4 is powered by gear 3, and gear 5
by gear 4. Shaft A will turn at the same speed and direction of rotation as gear
5, and shaft B will turn at the same speed and direction of rotation as gears 2
and 3.

More than one approach can be used to determine the speed of shaft A and shaft
B. Thefirst one that we will show uses the gear equation. Because there is more
than one pair of gears, the equation must be used more than once. The speed of
gear 2is.

_ T]_ X N]_ _ 24 x 2,200
T, 12
Because gear 2 is fixed to shaft B, shaft B and gear 3 turn at 4,400 rpm.

To determine the speed of shaft A, the gear equation is used two more times,
first to find the speed of gear 4:

16 x 4,400
=g

N» = 4,400 rpm

= 8,800 rpm

and then the speed of gear 5:

_ 8x8,800
V)
Therefore, shaft A turns at 5,900 rpm.

= 5866.66. .. or 5,900 rpm

FIGURE 6.7. Calculating shaft speed and direction of rotation in multiple shaft drives.
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Remembering the discussion of speed ratios, we can develop an alternative
approach for solving this problem. If the speed of shaft B is determined by the
speed of the driver gear times the gear ratio of the two gears, then the speed of
shaft B can be determined by:

T, 24
Ng = Ni x - = 2,200 x ~= — 4,400 rpm
B=T1x 3 12 P

and the speed of shaft A can be determined by:

T T T
NA:le—lx—3x—4
T, T4 Ts

24 16 8
:2,200XEX§XE

6,758,400
T 1,152
= 5866.66. .. or 5,900 rpm

When the speed ratio approach is used, it is important to place the number of
teeth of the driver in the numerator and the number of teeth of the driven in the
denominator.

6.6.1. Direction of Rotation

The best way to determine the direction of rotation of shafts A and B is to use
intuitive reasoning.

We know, from our discussion of gears, that the direction of rotation changes
with every pair of gears in the power train. Thus, shaft B is driven by one pair
of gears, and changes direction of rotation one time. Shaft B turns clockwise.
Shaft A is powered by three pairs of gears, and changes the direction of rota-
tion three times. Shaft A turns clockwise also. Study Figure 6.8 to check these
answers.

FIGURE 6.8. Determining the direction of rotation for
shafts A and B.
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6.7. Speed and Torgque

Torque is arotating force applied to alever arm. In the case of a belt and pulley,
the force is the tension on the belt and the length of the lever arm is the radius of
the pulley. Suppose that a set of scalesis attached to the belt, asin Figure 6.9, and
assume that the tension on the belt is 100.0 Ib.

Because the tension or force in the belt is constant along its length, there is
100.0 Ib of force pulling at the edge of both the driver (A) and the driven (B)
pulley.

When the driver pulley has a diameter of 10.0 in and the driven pulley has a
diameter of 5.0 in, then the torque on the driver pulley in Figure 6.9 is:

To=F xR
To=F x R =100.01b x 5.0in = 500 Ib-ft

and the torque on the driven shaft is:
To=F x R=100.0lb x 2.5in = 250 |b-ft

The torque is different on the two pulleys because pulleys behave as class one
levers; the radius (one-half the diameter) is the length of the lever arm. A larger
diameter pulley will have a longer lever arm. This example also illustrates that
because the belt speed (in inches per minute) stays the same; the torque on the
driven shaft is inversely proportional to the change in speed between the driver
and driven pulleys. When the driven shaft turns at a higher speed, its torque is
decreased relative to the driver shaft, and vice versa

For every speed change, there is a change in the torque. Reviewing the PTO
power equation is one way of showing this relationship:

Tox N

Pip = ————
HP = 550

When the horsepower stays the same, assuming that there are no drive train power
losses, then as torque increases, the rpm must decrease, and vice versa. Thisrela
tionship also can be expressed as:

To; x Ny =To, x No

FIGURE 6.9. Speed and
torque.
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Problem: The driver shaft of a belt power train turns at 300 rpm and applies
20.0 Ib-ft of torque, and the driven pulley turns at 50 rpm, how much torque will
be developed at the driven pulley?

Solution: Rearranging the torque equation to solve for To, gives us:

N 300
To, = Toy x N—l — 200 Ib-ft x P

= 120 |b-ft
2 50 rpm

Notice that the speed of the driven shaft is one-sixth that of the driver shaft, but
the torque on the driven shaft is six times that on the driver shaft. Thisrelationship
suggests the reason for atractor transmission. The engineturns at high speed with
low torque, and thedrive axleturnsat low speed with high torque. Thetransmission
uses different gear pairs to produce different speed—torque combinations at the
drive axle.

6.8. Transmission of Power and Torque

In managing agricultural machinery, it is sometimes useful to know the amount of
torque being transmitted by a component of a power train. For example, it would
be useful to know the amount of torque and the horsepower available at shafts A
and B in Figure 6.7.

Using the previous discussion of the relationship between torque and speed and
the torgque equati on the maximum torque available at each shaft can be determined:
Top = Toy x

Ogp = 101 X N_2
To solve for Tog the values for the three variables must be known. The two rpm’s
were calculated in the previous section. The remaining variable is the torque sup-
plied by the motor. Horsepower will be discussed in greater detail inalater chapter,
but rotary horsepower can be determined by the horsepower equation used in the
previous section.

B Tox N
)

Because we know the horsepower and the rpm being produced by the engine, we
can rearrange this equation to solve for the engine torque:

Php x 5252 50 hp x 5252

= = 119.36... or 120 Ib-ft
N 2,200 rpm o

Once the torque produced by the motor is known, the torque on shaft B can be
calculated.

N 2200
Tog = Toy x —t = 120 Ib-ft x 2o 1P

————— = 60Ib-ft
N> 4,400 rpm
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The torque at shaft A can also be calculated:

Nmotor 2,200 pm

Toa = T =120 1b-ft x ———

Oa Omotor X Na X 6,000 rpm

Note that because we already knew the speed of shaft A, we used the speed ratio

to solve for the torque. If we did not know the speed of shaft A, we would solve
for it first.

= 44 |b-ft

6.9. Power Transmission Through Power Trains

Power is transmitted through a power train. Study Figure 6.8 again. Can you
predict how much power is available at either shaft A or shaft B? The answer
50 horsepower is correct. If we assume no frictional losses in the power train, we
will get out all of the power we put in. This can be demonstrated by using the
horsepower equation to solve for the power available at shaft A.

Tox N 441b-ft x 6,000 rpm
5252 5252

Prp = =50.26... or50 hp

6.10. Pneumatic and Hydraulic Systems

Pneumatic and hydraulic systemsare based on the behavior of aflowingliquid. The
primary difference is that hydraulic oil is considered noncompressible and air is
not. Hydraulic systems are used on more agricultural equipment than pneumatic.
Therefore, the remaining discussion will concentrate on hydraulic systems. All
pneumatic and hydraulic systems have five required components, Figure 6.10.
The heart of both systems is a pump. Many different types of pumps are used,
but they have a common job—energize the system. The system also requires a
reservoir to store the ail, control valves to control the amount and direction of
flow, some type of actuator to perform the work and hoses and pipes to connect
all of the components. Other components are included as necessary to achieve the
desired performance of the system.

Hydraulic systems operate on two principles, pressure and flow. Pressureisused
to cause force or torque, and flow is used to cause movement. The pressure in a
system is governed by Pascal’s Law, which states that the pressure on a confined

FIGURE 6.10. Five required components of a hydraulic system.
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FIGURE 6.11. Force—thefirst principle of hydraulics.

liquid is transmitted equally in all directions and results in equal force at right
angle to the container walls, Figure 6.11.

In Figure 6.12, force is used to pressurize the liquid and pressure is used to
transmit and change the intensity of the resultant force. Changing the intensity of
the resultant force is accomplished by changing the pressure or the area, Figure
6.12. The amount of force produced is determined by multiplying the pressure
times the area.

P=FxA

where P = Pressure, psi or Ib/in?; F = Force, Ib; A = Area, in°.

FIGURE 6.12. Increasing force using hydraulics.
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Problem: How much force is produced on the second piston in Figure 6.12?
Solution: Thefirst step isto determine the pressure in the system.

P]_: F1XA1

= 100.01b x 2.0ir?

Ib
=200 —
in?

But P; = P, The pressure isthe same at al locations. Therefore:
Fz = P]_ X Az
Ib -
= 200— x 4in
in?
=4001b

Thisexampleshowsthat whena100.01bweigh appliesforcetoanareaof 2.0 square
inches a pressure of 200 Ib per square inch is produced. When this pressure is
contact with an area of 4.0 square inches, aforce of 400 Ib will be produced. The
increase or reduction of the force is proportional to the area.

The second principle of hydraulic systemsis flow. The flow of the fluid deter-
mines the speed and amount of movement for the actuatorsin the system. In atwo
piston system asillustrated in Figure 6.13 thetotal flow (in®) from thefirst piston to
the second can be determined by multiplying the area (in?) of the piston times the
length (in) of the stroke (S). When the second piston has alarger area, the distance
moved will be less because the volume moved is the same for both and a larger
arearequires less stroke length to produce the same volume. Thisrelationship can
be expressed mathematically:

A1X51=A2XSZ

Problem: How far will the second piston in Figure 6.13 move?

FIGURE 6.13. Determining flow.
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Solution:

A]_XSl:AzXSz
A]_XS]_

Az
2.0in* x 6.0in

4.0in?
=3.0in

Sy

In most mobile applications of hydraulics the pressure is produced by a pump
and regulated by a pressure relief valve. In these applications the system pres-
sure determines the force produced by the actuator. When linear actuators, cylin-
ders, are used, the diameter of the cylinder and the pressure of the fluid at
the cylinder determine the force produced. The distance the cylinder extends
or retracts is determined by the amount of fluid that moves and the speed at
which the cylinder extends or retracts is determined by the flow rate of the
fluid.

Problem: Determine the maximum force possible, amount of extension (in) and
rate of extension (in/min) for a3.50 in diameter cylinder when the system pressure
is set at 2,500 Ib per square inch (psi), the flow rate is 3.25 gallons per minute
(gpm) and the control valveis activated for 15.0 sec.

Solution: The process for determining the maximum force produced is the same
as the one used in the previous problem.

F=PxA

Ib .
:zw%gx@x@mmﬁ

|

= 2,500 —b x 38.484 ...
in?

= 96211.27... or 96,200 b

The amount of extension or stroke is a function of the cross section area of the
cylinder and the volume of fluid flow. This problem can be solved using units
cancellation method.

231in® 325gd 1min 15.0sec 1
Sin = X — X X X -
1ga 1min = 60sec 1 38.5in?

1126125

2310 =4.8750r4.88in

The flow rate of the fluid (Q) and the cross section area of the cylinder determines
therate of movement. This problem can also be solved using the units cancellation
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method.
g(n)_\lin® 325¢d 1 75075 in
min)  1gal 1min = 385in2 385  min

6.11. Metric Problems

Problem: What diameter of pulley is needed if the desired speed is 500 rpm and
the driven pulley is 6.0 cm and turns at 1725 rpm?

Solution:

D]_XN]_ZDQXNZ
rev

6.0cm x 1725 —
D N ; 10350
_ ax N1 rey—in =20.70r21cm
N> 500 500

min
Problem: Determine the torque available at shafts A and B in Figure 6.14.

D>

Solution: The first step is to determine the speeds of shafts A and B. Shaft B is
thefirst onein the series so it will be used first.

T1XN1=T2XN2

rev
C Tux Ny 2ATx2200000 57800

N = = 4,400 rpm
B= T, 2T 2 P
The speed of shaft A:

T T T.
Na = Np x B .
T, T4 Ts

24 16 8

=2200x — X — X —

12 8 12

FIGURE 6.14. Complex power train with metric values.
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_ 6,758,400
T 1152
= 5866.66. .. or 5,900 rpm

Themaximum torquewill beavailableat only at one shaft. The maximumtorque
will be calculated for A and B. The maximum torque delivered by the motor is:

Tox N
9549

Pw —

Solving for To

_ 9549 x PkW

=
9549 x 37.0

~ 2200

To = 160.6 Nm

To

The motor is producing 160.6 Nm or torque.
The torque at shaft A is:

To; x Ny = Top x No
To; x Nq
Top= — 2
2 N,
rev
160.6 Nm x 2,200 —
min

5,900 =
min
353320

= =50.884... kN
5900 50.884... or 60

The maximum torque at B is:

_ TO]_X N]_

To
2 N,
rev
160.6 Nm x 2,200 1
_ min
4,400 '
min

353,320
4400
Problem: How muchforcewill be produced by thehydraulic systeminFigure6.15

when the diameter of thefirst cylinder is5 cm, the diameter of the second cylinder
is 15 cm and the force on the first cylinder is 50 kN?

= 80.3Nm
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FIGURE 6.15. Force produced using Sl units.

Solution: Force divided by area equals pressure and pressure multiplied by area
equalsforce.

F (N)
P(KPA) = 4o
50 kN 10000cm?  1000N 1Pa  1kPa
= X X X X
7 x (5 cm)? 1m? 1kN N/m? = 1,000 Pa
4
500,000,000
= 2O 25464.79 .. or 25,000 kPa
10634.95... o

The pressure on the fluid will be 25,000 kPa. The force on the second cylinder
is:

F(N) = P(kPa) x A(cm?)
7 x (15 cm)? 1m?
X
4 10,000 cm?
1,000 Pa y N/m? y 1kN
1kPa 1Pa = 1,000N

417,864,669
~ 10,000,000

= 25,000 kPa x

= 441.786 or 440 kN

Problem: How far will the second piston, in the previous problem, move when the
piston in the first cylinder moves 5 cm?
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Solution: Area x stroke distance = area x stroke distance

AL xS1=A xS,
AL xS
Az
19.6 cm? x 5¢cm
176.7 cm?
98

= 1767 =0.554... or 0.55cm

Sy =

79
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Tractors and Power Units

7.1. Objectives

Be able to describe the common designs of tractors.

Be able to estimate draw bar and PTO power using the 86% rule.

Be able to derate a stationary power unit for the intended work environment.
Be able to explain the concept of lugging ability.

Be able to describe the principles of tractor testing.

Understand the ASABE and OECD tractor testing procedures.

oukwhNpE

7.2. Introduction

Tractors are very versatile machines, but the range of uses is too wide for one
machine to be successful in all of the possible jobs. Tractor manufacturers target
tractor designs for different categories of use. These category boundaries are not
ridged, but if owner/operators push the boundaries too far, the tractor can fail
which may lead to an accident which damages the tractor or implements. It can
also result in injuries for the operator or bystander. It is important, therefore, for
the owner/operator to have a basic understanding of the common categories of
tractors. This chapter will also explain how stationary engines and tractors are
derated, and how tractors are tested.

7.3. Categories of Tractors

The diversity of modern agriculture requires many tractor designs. Historically,
utility (use) has been the basis of tractor classification schemes. Based on utility,
there are six categories of tractors: general purpose, row crop, orchard, vineyard,
industrial, and garden. The designers of modern tractors have attempted to produce
tractorswith the broadest possible uses, but these categoriesare still applicableif a
sub-category isadded for each type of propul sion system: rear wheel drive (RWD),
four wheel drive articulating steering (AWDAS), four wheel drive four wheel steer
(4WD), tracks (T), and rear wheel drive with front wheel assist (FWA).

80
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7.3.1. General Purpose

The general purpose tractor is the traditional design with the rear wheels and the
front wheels spaced the same distance apart. This type of tractor usually is built
closer to the ground than the row crop design. The power range of tractors of
this type is very broad; sizes range from about 25 to over 400 horsepower (19 to
300 kW). The use of a general purpose tractor is influenced by its power. The
smaller sizesare very popular for smaller agricultura enterprisesand for mowing.
The mid-range sizes are used extensively for cultivating, spraying, tilling, and
mowing, and for mobile or stationary power take off (PTO) power. The larger
sizes normally are used for primary tillage and to provide PTO power for larger
mobile and stationary machines such aslarge balers, forage harvesters, emergency
generators and silage blowers. Some of the tractors at the top of the power range
are designed for tillage only and may not have a PTO or three point hitch.

General purposetractors are available with all five types of propulsion systems.
Historicaly, thistractor category has been dominated by the rear wheel drive, but
in recent years the situation has changed. The propulsion system aso isinfluenced
by the power. Smaller tractors use the rear wheel drive or the front wheel assit;
in the middle of the power range, al types can be found; and in the largest engine
sizes, the most common type is the articulating four wheel drive.

7.3.2. Row Crop

Row crop tractors are designed with greater ground clearance than the general
purpose tractors have. This gives them the ability to straddle taller crops with
less plant damage. The size range of row crop tractors is narrower than that of
the general purpose, as these tractors are usually 50 to 100 horsepower (37 to
75 kW). Historically many were built with the front wheels closer together than
therear wheels(tricyclestyle). Thenarrow front wheelseliminate the use of tracks,
front wheel assist, and articulating steering; but row crop tractors without narrow
front wheels can be found with these configurations.

7.3.3. Orchard

Orchard tractors are not a separate type of design as general purpose and row crop
tractors are, but are tractors that have been modified to reduce the possibility of
tree limbs catching on them. Madifications usually include changing the location
of the exhaust and the air intake and the addition of shields around the tires and
other protuberances. Orchard work is not as power-demanding as primary tillage;
therefore, these tractors are usually in the medium power sizes.

7.3.4. Vineyard

Thevineyard tractor also isfound in the smaller power range. It has been designed
or modified to reduce its width so that it can pass between narrow rows. It also
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may use shielding similar to that of the orchard tractor. The narrower size limits
the propulsion system to the conventional rear axle drive, front wheel assist, and
tracks.

7.3.5. Industrial

Thesetractorslook like general purpose agricultural tractors, but they have impor-
tant differences. They are equipped with tires designed for use on hard, smooth
surfaces and the front axle and frame will be designed to withstand the weight and
shocks of front loaders, backhoes, and other industrial equipment.

7.3.6. Garden

This tractor category has the greatest amount of variation in mechanical con-
struction. These tractors usually are less than 25 horsepower. Some are manu-
factured to look like a small tractor, but others may look more like ariding lawn
mower. They generally usetherear wheel drive system, with or without front wheel
assist.

7.4. Tractor Power Ratings

Different power ratings are used to evaluate the size of tractors and engines. It is
important to remember that manufactureslike to advertise their engine power with
the highest possible number to make them competitive in the marketplace. The
useable power is usually less than the advertised power. The type of value used to
express the power must be known before the useable power can be determined,
Figure 7.1.

FIGURE 7.1. Tractor power ratings.



Tractor Power Ratings 83

7.4.1. Engine Power

Engine power isacal culated power based on the bore, cylinder pressure, and speed
of theengine. Engine power isnot auseful rating for determining the useabl e power
available from atractor or stationary engine.

7.4.2. Brake Power

The term brake power comes from the early use of the Prony brake to measure
engine power. Brake power isthe power available at the flywheel of the engine. It
isnot a useful rating for tractors, but it is the power rating used to size stationary
engines for irrigation pumps and other similar uses.

7.4.3. PTO Power

Power take-off power (ptohp) isarating of the power avail able at the power take-off
of an agricultural tractor. Power take-offs are used to supply rotary power to many
different types of machines such asbalers, pumps, and mowers. To determine PTO
power either power eguation using torque can be used.

Tox N
hp) =
Power (hp) = 5565
where hp = horsepower; To = torque (Ib-ft); N = speed (rpm)
Tox N
kW) =
Power (kW) 9529

where kW = kilowatts; To = torque (Nm); N = speed (rpm).

7.4.4. Drawbar Power

Drawbar power (Dbhp) is power measured at the point implements are attached
to the tractor, drawbar or 3 point hitch. During tractor testing aload cell is placed
between thetractor and aload. Thedrawbar pull and the speed of travel arerecorded
and used to calculate drawbar power. Using measurements of pull (pounds) and
speed (miles per hour) eliminates the PTO power equations. Because force is
measured in poundsand velocity (V) measures both distance traveled and thetime
required to travel that distance (miles per hour), the best equation to useis:

PbHp = 375~

where F = Force (Ib); V = Speed (mph); 375 = Units conversion constant.
This equation is derived by modifying the standard power equation.

P FxD
HP = % 33,000
D mile ft FxV x88 FxV
ecauseV = +-and 1 = = 830, then 1hp = —2=500 375
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Problem: How much drawbar power isatractor producing if it develops 1,500 Ib
of force at a speed of 5.5 miles per hour?

Solution:

mile

Dby, =
WP = 7375 375 375

=22hp

7.5. Converting Tractor Power Ratings

Manufactures can use anyone of the four power ratings to advertise their tractors.
When manufactures use engine or brake power to rate a tractor they are not pro-
viding any useful information because the useable power will be less than that.
When the tractor is rated by engine or brake power, the PTO power will be less
because of the losses in the power train. The drawbar power will be less because
there are additional losses in the transmission and drive train and a tractor is not
ableto apply all of the torque of the drive wheelsto the soil.

Actual PTO and drawbar power ratings can be determined if the tractor has
been tested by the Nebraska Tractor Test (NTT) Station or by the Organisation for
Economic Cooperation and Development (OECD). When actual PTO and drawbar
ratingsare not available, the 86% rule can be used to estimate them from the engine
rating.

Studies have shown that if alarge number of tractors are compared over many
different traction conditions, the PTO power will be approximately 86% of the
engine power, and the drawbar power when tested on a concrete track will be
approximately 86% of the PTO. The 86% rule permits an estimate of PTO and
drawbar power. It is not intended to be a substitute for actual data.

Problem: Estimate the amount of power available at the PTO and the drawbar for
atractor rated at 125.0 engine power (Epp).

Solution: Using the 86% rule:

PTOwp = Epp x 0.86 = 125.0 hp x 0.86 = 107.5 or 110 PTO,
Dby = PTOwp x 0.86 Or Epyp x 0.86 x 0.86 or Epyp, x 0.7396
Dby = Epp x 0.7396 = 125 hp x 0.7386 = 92.45 or 92.4 Dby,

The 86% rule can be used in other ways also. For example, if the drawbar power
is known, the PTO and engine power can be estimated.

Problem: What is the estimated PTO power if the tractor produces 50.0 power at
the drawbar?

Solution: From the discussion of the 86% rule, we know that the PTO power will
be larger than the drawbar. Therefore:
Dby 50.0 Dby

PTO, = =
"~ 0.86 0.86

= 58.139...0r 58 PTOyp
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FIGURE 7.2. Engine torque curve with lugging ability.

7.6. Lugging Ability

An important feature of tractors that will be used for primary tillage or as a sta-
tionary power supply is their lugging ability. Lugging ability is a measure of the
amount of temporary overload the tractor can withstand. The lugging ability for a
tractor or stationary engine can beillustrated with a horsepower curve. Figure 7.2
shows apower curvefor an engine designed with lugging ability. Noticethat asthe
engine is overloaded and the rpm drops from the top engine speed of 2,050 rpm
to 1,850 rpm the power increases.

The amount of increase in torque is a measure of the engines lugging ability.
Compare the torque curve in Figure 7.2 with the onein Figure 7.3.

FIGURE 7.3. Engine torque curve with no lugging ability.
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This engine does not have any lugging ability because the torque decreases as
soon as the rpm decreases. There is no temporary increase in torque to help the
tractor pull through atemporary overload.

7.7. Derating Power Units

Manufacturersof enginesintended for stationary use, for example, to power apump
or agenerator, usually can supply the purchaser of an engine with a performance
curve for the engine, Figure 7.4.

The performance curve will show the rated power for an engine for different en-
gine speedsranging from the minimum speed recommended for aload to the maxi-
mum. However, the usable power islessthantherated power if oneof several condi-
tions exists, as explained below. The adjustment from rated power to usable power
is called derating. Failure to derate an engine could shorten the life of the engine.

The factors used for derating depend on the engine type and the operating
environment. Spark ignition and diesel engines are derated to allow for the effect
of accessories, temperature, atitude, and type of service.

7.8. Accessories
If the power rating isreported for abasic engine, sometimes called the gross power

rating, it was tested with all accessories removed. These accessories include the
air cleaner, muffler, generator, governor, and fan and radiator. If the power ratingis

FIGURE 7.4. Engine performance curves.
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for afully equipped engine, sometimes called anet power rating, these accessories
were on the engine when it was tested.

If basic engine power is reported, the engine must be derated 10% for al ac-
cessories other than the fan. An additional 5% must be deducted if the engine will
have afan and aradiator instead of a heat exchanger.

Problem: How much usable power isavailableif thebasic engineratingis 75.0 hp,
and the engine will use afan and aradiator for cooling?

Solution: Derating 10% for the accessories and 5% for the fan:
hp = 75.0 hp x (1.0 — (0.10 + 0.05)) = 75.0 x 0.85 = 63.75 or 64 hp
Note: the same answer can be determined by subtracting the lost power.

hp = 75.0 hp — Loss = 75.0 hp — (75.0 x (0.10 + 0.05))
= 75— 11.25=63.750r 64 hp

The effect of the accessories is to reduce the useable power from 75 to 64 horse-
power.

7.9. Temperature

The ambient temperature must be considered because as the temperature of the air
that the engine breathes increases, the density decreases, and there is less oxygen
per cubic foot of air. The decreasein oxygen decreases the efficiency of theengine.
The important air density is the density of the air as it enters the engine. For
turbocharged and supercharged engines the density of the air has been increased
above ambient removing the effect of temperature. Therefore no adjustment for
temperature needs to be completed. For naturally aspirated spark ignition engines
the power rating must be reduced 1% for each 10°F (5.6°C) ambient temperature
rise above 85°F (29°C). For diesdl engines the adjustment is 1% for each 5°F
(2.7°C above 85°F (29°C).

Problem: How much usable power will a 165 Bhp spark ignition engine produce
if it will be operating in 100°F air temperature?

Solution: Using the recommended derating for temperature;

100°F — 85°F
hp = 165.0 hp X (1 — (001 X T

= 162.525 or 160 hp

)) = 165.0 x 0.985

The effect of the 100°F temperature is to reduce the useable power from 165 to
160 horsepower.
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7.10. Altitude

Asthealtitudeincreases, the barometric pressure decreases. Thisreductionin pres-
sure reduces the efficiency of naturally aspirated engines because as the el evation
of the engine increases, the pressure difference is less between the air pressure
inside the cylinder, on the intake stroke, and the atmospheric pressure. Decreasing
the pressure difference decreases the amount of air that will flow into the engine
on the intake stroke.

Altitude is not a problem for engines with turbochargers or superchargers be-
cause they increase the intake system pressure. For naturally aspirated spark igni-
tion and diesel engines the power rating must be reduced by 3% for each 1,000 ft
(305 m) of elevation above 500 ft (152 m) above sealevel.

Problem: What is the usable power rating for a 225 hp diesel engine operating at
an elevation of 4,500 ft?

Solution: Using the derating recommendation for atitude (Note: the method used
to solvethisexampleisdifferent fromthe previousone. Either method can beused.)
4,500 ft — 500 ft))

100% — ( 3.0%
° ( °X< 1,000

EHp =225 hp X
= 225hp x 0.88
=198 hp

100

This example was worked using percentages (%6).

7.11. Type of Service

The type of engine service is determined by the load—ntermittent or continuous.
An intermittent load on an engine is a load that varies in torque and speed; for
example, tractorsin tillage operations are subject to intermittent loads. Continuous
loads providelittle variation inthe torque and speed demands placed on theengine;
irrigation pumps are an example of a continuous load. Some manufacturers may
indicate the type of servicefor therated power. If not, the engine should be derated
for thetypeof service. Theavailable power must bereduced by 10%for intermittent
loads and 20% for continuous loads.

Problem: What isthe usable power for an engine that has been derated for acces-
sories, temperature, and altitude to 115.3 hp if it will be used for continuous duty?

Solution: Derating for continuous duty:
100% — 20%
100
From this discussion it is evident that an important difference may exist between

rated power and usable power for stationary engines. Also note that if a tractor
is being used for stationary power for an extended period of time, it should be

hp = 115.3 hp x — 115.3 x 0.80 = 92.48 or 92 hp
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derated. When derating a tractor, remember that the PTO power will be equal to
that of afully equipped engine.

The previous section explained the procedure for derating an enginefor individ-
ual factors. One question that remainsis how is an engine derated when more than
onefactorsisinvolved. Thisisaccomplished by summing up thereduction for each
individual factor and multiplying this number by the appropriate power rating.

Problem: Determine the usable power for a fully equipped, non-turbocharged,
diesel enginerated at 115.0 power when it isoperated on continuous duty, at 3,350
ft elevation and with an air temperature of 98.5 degrees.

Solution: For this example the engine must be derated for temperature, altitude
and duty. The example was worked using the decimal form of percentages.
Temperature;

98.5°F — 85°F
001 x (=2 ) =0.027
) ( 5°F )
Altitude:
3,350 — 500
0.03x [ ==—_ _~") =0.0855
x ( 1,000 )

Duty: Continuous duty requires a derating of 20%.
Total adjustment:

Total = temperature + altitude + duty = 0.027 + 0.0855 -+ 0.20 = 0.3125
Enp = 115.0 hp x (1 — 0.3125) = 79.0625 or 79.1 hp

A 115.0 horsepower, non-turbocharged diesel engine operating under these
conditions will have 79.1 useable power.

7.12. Tractor Testing

Early tractorsweredesigned to deliver power inthreeways: by belt pulley, drawbar,
and power take-off. On newer tractors the belt pulley has been eliminated. One
problem the owner/manager has faced since the first tractor was designed is lack
of information on the power ratings of tractors. Asarule, tractor manufacturers do
not advertise the drawbar or PTO ratings of their tractors; instead many use brake
power or engine power. If engine power is used, it could be a theoretical power
rating for the engine.

In 1918, the Nebraska legislature passed a law that established the Nebraska
Tractor Test Station. This law mandated that a typical model of tractor must be
tested beforeit could be sold within the state of Nebraska, and that the manufacturer
must maintain apart supply depot within the state. Thistesting station hasprovided
the only independent evaluation of tractorsin the United States.

Astime passed and alarge percentage of tractor manufacturing moved outside
the United States, a change was needed. Two changes have occurred: the Nebraska
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Law was changed to allow tractors to be sold in Nebraska with either a Nebraska
test or an Organisation for Economic Cooperation and Devel opment (OECD) test,
and the Nebraska test was changed to match the standards established by the So-
ciety of Automotive Engineers (SAE) and the American Society of Agricultural
and Biological Engineers (ASABE). Currently the Nebraska Tractor Test Station
isqualified to conduct either test at the request of the tractor manufacturer. A full
review of both testing standards is not possible in this text; instead the follow-
ing is adiscussion of the general principles of testing and the two test methods.
Individual reports and additional information can be obtained from the testing
stations.>-2

7.13. Principles of Testing

Because of the important role tractors play in agricultural production, accurate
information is a must for efficient management of the modern farm and ranch.
Any information is usable, but the main objective of testing is to provide stan-
dardized results so that comparisons can be made between different models and
different years. The primary purpose of tractor testing standards is to establish
the test conditions and the rules of behavior for the manufacturer and the testing
station.

It should be evident that engines are complex mechanisms with many differ-
ent factors that influence the power produced and fuel efficiency. Because of the
widespread use of the data, manufacturers want to be sure they get the best pos-
sible results. To provide standardized information, the testing environment must
be consistent for every test, day after day, year after year, or changes must be
thoroughly investigated so that the appropriate adjustments in the results can be
made. In both tests, these factors are called test conditions.

Test conditions include the rules for the selection of the tractor and the control
and/or recording of environmenta conditions. During the PTO test, air temper-
ature, barometric pressure, fuel type, fuel temperature, fuel measurement, lubri-
cants, and accessory equipment on thetractor must be either controlled or recorded
to ensure that they are within acceptable limits. Strict control of these factors is
important because many tests measure the maximum power of the tractor. Each
one of these factors will influence the power produced.

For the drawbar test all of the environmental factors in the PTO test must be
accounted for, plus those that affect traction. The latter include tractor ballast,
tires, and testing surface. The ballast, tires, and testing surface are critical because

1 OECD Standard Codes for the Official Testing of Agricultural Tractors, Organisation for
Economic Cooperation and Devel opment, 1988. 2, rue Andre-Pascal, 75775 Paris CEDEX
16, France.

2 Nebraska Test Station, Agricultural Engineering Department, University of Nebraska—
Lincoln, Lincoln, Nebraska 68583.
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the amount of pull a tractor can produce at the drawbar is greatly influenced by
the amount of traction. Both the NTT station and the OECD station have strict
standards on how all these factors are controlled and/or recorded.

Inadditiontothetest conditions, thetesting codes must establish rulesgoverning
such things as breakdowns, repeating tests, testing accessory systems such as
hydraulic systems, safety standards, noise standards, and the method of reporting
and publishing the results.

7.14. Metric Problems

Problem: Determinethe power being produced by atractor if it devel oped 6.67 kN
of force while traveling at a speed of 9.0 km/hr.

Solution:
F(kN) x V (km/hr)

3.6
6.67 kN x 9.0 km/hr

- 36
— 16.7 kW

P (kW) =

Note: Appendix Il includes conversions from customary to Sl units. The an-
swer to this problem could be converted to horsepower by using the appropriate
conversion. Horsepower equals.

Hp = &k\/\lﬁw =22.368... or 22.37 hp
0.7456999 —
hp

Problem: Determine the useable power for a 120 kW naturally aspirated natural
gasirrigation engine that will be operated with afan and radiator. It is located at
an elevation of 1,000 m and will operate in an air temperature of 38°C and on
continuous duty.

Solution: The process is the same as customary units. The only difference isin
the values used. For this example direct conversions are used, Table 7.1.

TABLE 7.1. Direct conversions for derating factors.

Accessories 10% other than fan
5% fan and radiator
Temperature 1% or each 5.6°C above 29°C for gasoline
1% for each 2.7°C above 29°C for diesel
Altitude 3% for each 305 m above 152 m
Type of service 10% for intermittent loads

20% continuous loads
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The useable power is determined by determining the total amount of power loss.
Power 10ss (%) = Lacc + Lat + Ltemp + Lauy
Lac = 0.1040.05=0.15

1,000 m — 152 m
Lat=003x | —————— ) =0.03x 2.78... =0.083
305m
38—-29
Ltemp = 0.01 x < 777 ) =0.01 x 1.906... = 0.019
Loy = 0.20

Total loss = 0.05 + 0.083 4 0.019 + 0.20 = 0.662
Useable power = 120 kW — (120 kW x 0.662) = 120 kW — 79.44 = 40.55 kW

All of the power losses for this engine are 79.44 kW, leaving 40.55 kW of useable
power.



8
Machinery Calibration

8.1. Objectives

Understand the need for evaluating the performance of machines.
Understand the principles of calibration.

Be able to calibrate a broadcast type fertilizer applicator.

Be able to calibrate a grain drill.

Be able to calibrate a row crop planter.

Be able to calibrate an air seeder.

Be able to calibrate a field sprayer.

Be able to prepare the proper mix of chemicals and water for a sprayer.

N O AN

8.2. Introduction

One role of agricultural machines is the dispensing of materials such as seeds,
fertilizers, and sprays. These machines are designed to dispense the material at
a fixed, or variable rate, and in a fixed, or variable pattern. A machine that fails
to dispense the material at the desired rate and pattern should not be used. An
insufficient amount of material will not produce the desired results, and excessive
amounts are a lost resource that may result in crop damage and/or contribute to
contamination of the environment. A pattern that is not correct may cause streaking
or skips. Calibration charts or tables are usually supplied with or are available from
the manufacturers of the machines in the owner’s manuals or from the supplier
of the material being dispensed. Charts and tables become lost or damaged, leaving
the operator with no or incomplete information.

Incorrect application of materials can have several causes. A machine may have
been damaged or modified. Variations in the weight, size, moisture content, and
cleanliness of the seed or variations in the physical condition (lumpiness, flow
ability) of the fertilizer or chemical granules can all contribute to an inaccurate
dispensing rate and distribution pattern. The economic penalties and potential
environmental damage from incorrect application of materials warrant the time

93
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and effort required to ensure that the machine is dispensing the desired amount
and that the distribution pattern is acceptable.

Checking a machines application rate and patterns of dispersal is called calibra-
tion. Although the exact procedure used to calibrate machines and other measuring
devices varies from one situation to another, this chapter will illustrate the calibra-
tion of four common agricultural material dispensing machines.

8.3. Principles of Calibration

In Chapter 1, two characteristic of mathematical problem where discussed. Both
of these must be applied when calibrating dispensing machines. It would be a rare
occurrence for a dispensing machine to distribute the desired amount of material.
In this case perfection is not expected. Therefore levels of acceptability must
be established. The amount of error that would be considered acceptable varies
for each machine and situation. In some cases guidelines or standards have been
established, but in others it is up to the owner/operator to determine how much error
will be accepted. Standards of acceptability for each machine will be discussed in
more detail for each machine.

All of the methods used to calibrate agricultural machines are based on three
principles: (1) all dispensing machines meter (control the rate) the flow of material
at a predetermined rate selected by the operator, and (2) calibration occurs by
collecting material dispensed by the machine in units of volume, weigh or mass,
or number of granules or seeds per unit area. For example, to calibrate a row crop
planter it is necessary to determine the seeds per acre or seeds per hectare. To
calibrate a sprayer, the application rate is determined in units of gallons per acre
or liters per hectare. Seeding rate of certain grasses is in bushels per acre or liters
per hectare. Lime is applied in tons per acre or metric tons per hectare. The unit of
area used during calibration will usually be an acre or hectare or some fraction of
these. (3) There are two methods for collecting the material, stationary or mobile.
With the stationary method, the wheel that drives the machine metering unit must
be elevated so it doesn’t contact the surface and then it is turned for a fixed number
of revolutions. In the mobile calibration method, the flow of material is interrupted
into a container as the machine is pulled through the field. The advantage of the
stationary method is that the machine can be calibrated in off productive time.
The mobile method is best for machines that have a large number of metering
points. The mobile method may be the only option when methods other than a
ground driven wheel are used to drive the metering mechanism. It is important to
remember that the larger the area used during calibration, the greater the accuracy
of the calibration procedure.

8.4. Calibrating Fertilizer Applicators

Fertilizers, which are mainstays of modern agriculture, are applied in liquid,
gaseous, or granular form. In this section we will discuss the calibration of granular
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FIGURE 8.1. Broadcast fertilizer spreader.

applicators. The application of liquid fertilizers follows the same principles as
spraying chemicals and sprayers are discussed in a separate section. Gaseous fer-
tilizers require specialized equipment and are very hazardous to use. The equipment
to dispense gaseous fertilizers is not included in this text.

Most granular fertilizer applicators will be one of two designs, broadcast or
gravity flow. As with any agricultural machinery, designs vary, but a common
tractor powered spreader consist of a hopper that holds the material, a metering
mechanism, and a spreading mechanism, Figure 8.1. The hopper capacity will vary
depending on the size of the machine. Metering usually is accomplished through
the use of a variable-speed chain belt in the bottom of the hopper and an adjustable
opening. The chain belt generally is operated by a drive train powered by one of the
wheels of the spreader. Because a ground wheel drives the chain belt, the amount
of material dispensed changes as the speed of the spreader changes. The impellers
are usually powered by the tractor PTO and must turn at a constant speed for the
spreader to have a consistent dispersal pattern.

Inthis design the application rate of the material is set by changing the speed ratio
of the drive train that powers the metering device and/or changing the size of the
opening at the metering gate. The process of using a variable opening for metering
is called bulk metering. Bulk metering units meter the volume of material applied.
The material usually is spread as it drops onto one or more rotating disks, impellers,
which sling it out in a wide pattern either behind or in front of the spreader. An
alternative design powers the impellers from one of the ground wheels, eliminating
the need for a PTO or additional power source.
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FIGURE 8.2. Gravity fertilizer spreader.

Gravity flow applicators also use a hopper, Figure 8.2, but in this type of applica-
tor the hopper extends across the width of the machine. The material is dispensed
through adjustable openings along the bottom of the hopper. The rate of material
flow is set by the size of the opening. This design uses an agitator along the bottom
to prevent the material from bridging across the hopper and to break up lumps,
thus improving the uniformity of flow. The material flows through the openings
and onto the soil surface.

At one time gravity flow fertilizer spreaders were popular in agriculture, but
limits on practical widths has almost eliminated agricultural uses. Small ones are
still used for lawn care and other situations where 18 to 24 inch widths can be
effective.

Both types of spreaders may be calibrated using either the stationary or mobile
method. For both methods, the application rate, R, (Ib/ac) is equal to the pounds of
material collected per revolution of the drive wheel, divided by the area covered.
The area covered is determined by multiplying the width (w) x distance traveled.
The distance traveled is determined by calculating the perimeter of the wheel
(2 rr) and multiplying it by the number of revolutions of the drive wheel (n;). In
equation form this relationship is:

W

R= % This can also be expressed as: R = nﬂ, X %
Nr
where R = application rate (Ib/ac); W = weight of material (Ib); n, = number of
revolutions of drive wheel; A = area (acres).

To calibrate the spreader using the stationary method, the drive wheel for the
metering mechanism is elevated and the material is collected as the drive wheel
is rotated a predetermined number of turns. The weight of the material collected
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divided by the number of turns of the drive wheel equals the pounds per revolution.
Acres per revolution are determined by multiplying the circumference of the drive
wheel by the number of turns and the effective width of the spreader, and then
converting this area to acres, or:

2y
Ac) _ Trev ="
ne(rev) 43560 1
T ac

where & = 3.14; r = Effective radius of drive wheel (ft); n, = number of revolu-
tions of the wheel; w = Effective width of the spreader (ft); 43,560 = Number of
square feet per acre.

Combining the unchanging units to form a constant gives:

Afac)  2n
ni(rev) 43,560

Therefore, when a spreader is calibrated in a stationary position, the pounds per
acre can be determined by:

XTI xw=0.0001442 xr x worl442E —4 xrw

W
R= —
A

where R = application rate (Ib/ac); W = weight of material collected (Ib); A =
area (ac).

E _ W (Ib collected)
ac)  1.4420 E — 4 x r (radius) x w (width) x n (turns)

Problem: You setyour neighbor’s spreader to apply 1,200 Ib/ac of fertilizer. During
a stationary calibration of the applicator 160.0 Ib of fertilizer were collected as the
drive wheel was turned 15 revolutions. The effective radius of the drive wheel is
21.0 inches and the effective width of the spreader is 30.0 ft. Is the application rate
correct?

Solution:

Ib _ w
ac/  0.0001442 xr x w x N,

B 160.0 Ib
- ) 1ft
21.01in x .
1442E —4x — 1210 300 x 15 rev
1rev
_ 1800 108077, or1.400 2
0.1135575 ac

In this problem the spreader is applying 200 Ib/ac more than the desired amount.
Is this an acceptable level of accuracy? Should the spreader metering unit be
adjusted and rechecked? No consistent standard has been established to determine



98 8. Machinery Calibration

the acceptable error for broadcast fertilizer spreaders. One way to evaluate the
error is to calculate the percentage (%) of error. In this example the amount of
error was 17% [(200 1b/1200 Ib) x 100]. It would be up to the owner/operator to
determine if 17% was an acceptable level of error.

The one major disadvantage of the stationary method of calibrating broadcast
applicators is the problem of collecting the fertilizer during the calibration process
(160 Ib in this example). The quantity of material that must be collected will
be greater if the desired application rate (Ib/ac) is increased, or if the number of
revolutions is increased. The primary advantage of this method is that it can be
performed when it is impossible to have the applicator in the field, for instance,
because of muddy ground or inclement weather.

The alternative is to complete a mobile calibration. This can be accomplished in
two ways. In the first method, collectors (flat pans or pieces of plastic or tarp) are
randomly placed in the distribution path of the spreader or an alternative is to place
the collection devices in a row perpendicular to the line of travel of the spreader.
After the spreader is driven over the collectors, the material is weighed. The ap-
plication rate (Ib/ac) is computed by dividing the amount of material collected,
by the area of the collectors, and then converting the answer to the desired units
of volume weight or mass divide by the area. An advantage of the perpendicular
row of collectors is that the distribution pattern can be evaluated by plotting the
amount collected from each collector on a graph.

Problem: What is the application rate of a spreader that deposited 23.5 Ib of
material on two tarps, each measuring 10.0 ft x 12.0 ft?

Solution:
(Ib) W (Ib) 2351b 235
J— — — l =
ac A (ac) 2 % 10.0 ft x 12.0 ft x ac i 0.005509...
43,560 ft

_ 4265.25 or 4, 260 >
ac

[Note: This is an example where the number of significant figures in the answer
could be ambiguous because of leaving a zero when rounding. To clarify the
number of significant figures, the answer should be written as 4.260 E3.]

This method does not require a spreader wheel to be elevated, but you must
be able to drive the spreader in the field or over an area as wide as the dispersal
pattern. If the spreader is dispensing an excessive amount of material, the test area
will be over fertilized.

Problem: Determine the application rate and distribution pattern for a broadcast
spreader that was calibrated by placing 20-2 ft? collectors perpendicular to the
direction of travel. The desired rate is 800 Ib/ac. Table 8.1 shows the pounds of
fertilizer collected.

Solution: Thefirst step isto determine the application rate by summing the quantity
of fertilizer in the 18 collector pans (n.) containing fertilizer W;. Then determine
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TABLE 8.1. Fertilizer collected
during mobile calibration of
broadcast fertilizer spreader.

Collector Ib
1 0.000
2 0.008
3 0.014
4 0.016
5 0.020
6 0.023
7 0.030
8 0.038
9 0.050
10 0.062
11 0.062
12 0.060
12 0.057
14 0.052
15 0.048
16 0.041
17 0.035
18 0.026
19 0.017
20 0.000

the total area of the collector pans containing fertilizer (A¢). The application rate is:
Ib W
(3)-5tx
ac ng, x Ac

18 collectors x 2

0659
" 0.0008264 ...

0.659 Ib
2

1lac
X
collector = 43560 ft2

= 797.39 or 797 E
ac

The spreader is applying 797 Ib/ac. [Note: Only 18 collectors were used to deter-
mine the area because two collectors did not have any measurable material.] In
this case the percentage of error was

0 800 — 797 _ o
Yo(error) = T 100 = 0.38%
This is an acceptable level of error. The calibration is completed by plotting the
distribution pattern. A plot of the distribution is shown in Figure 8.3.
In the graph of the distribution the dashed line represents the ideal or acceptable
distribution for an overlapping distribution pattern. The solid line is the distribution
for this spreader. It is clear that this spreader has a problem. Even thought the
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FIGURE 8.3. Distributor graph for spreader.

application rate is acceptable, the distribution of the material is not. The cause of
the poor distribution should be determined and corrected before it is used.

Another mobile method can be used if it is certain that the spreader pattern is
reasonably accurate. First, weigh the spreader, and then drive it over a measured
area. Then reweigh the spreader. The difference between the before and after
weights is the amount of material applied. The area is already known, so it is easy
to find the application rate using mobile calibration equation.

Both of these methods can be used to calibrate a fertilizer spreader. The choice
and the materials used are up to the operator.

8.5. Calibrating Grain Drills

The traditional end wheel grain drill includes a hopper, a metering unit, seed tube
and furrow opener for each row, and the metering unit drive train, Figure 8.4. Grain

FIGURE 8.4. End wheel grain drill.
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drills also use bulk or volume metering. The rows are usually spaced 6-10 inches
(15-25 cm) apart. Combining the row spacing and number of metering units is the
traditional method for indicating the width of the drill. A drill identified as 13-6
would have 13 metering units spaced 6 inches apart or a width of 18 x6/12 =9
ft. The calibration of grain drills is more critical than the calibration of fertilizer
spreaders because drills dispense seeds. A small error in seeding rate can have
a greater impact on the yield than an error in fertilizer application. In addition,
it is more important that the seeds are planted uniformly. Grain drills can be
calibrated stationary or mobile. The units cancellation method can be used in
either situation. For both the stationary and mobile methods a container is attached
to each metering unit, the drill is driven a measured distance (mobile), or the drill
is jacked up and the drive wheel is turned (stationary) for a selected number of
revolutions.

Problem: An 18-6 (18 metering units spaced 6 inches apart) end wheel drill is set
to apply 1.0 bu/ac of wheat. The quantity of seeds collected during calibration is
shown in Table 8.2. The diameter of the drive wheel is 26.0 inches, and the drive
wheel was turned 25 revolutions. Is the drill planting the correct amount of seed
(bu/ac)? (Note: Because each wheel of an end wheel grain drill powers half of the
metering units, only nine units are shown.)

Solution: The first step is to determine the total weight of seed collected.
W;=0.10+0.10+0.12+0.10+0.11 + 0.11 4+ 0.11 + 0.154+ 0.13 = 1.031b

The next step is to determine the bushels per acre. To complete this step, the
problem can be broken down into several steps or the units cancellation can be
used in one continuous equation. A previous section explained that calibration is
determining a volume of material for an area. Using this concept, the drill can be
calibrated by determining the volume (bu) and the area (ac).

It is common to use a volume measure, bushels, to express the desirable seeding
rate for a grain drill. This means that when the seeds are measured in pounds, a
conversion from weight to volume must be made. The relationship between weight
and volume is the specific weight () where:

where y = specific weight (weight/volume); W = weight (Ib); V = volume (bu).

TABLE 8.2. Pounds of wheat collected from nine grain drill metering units.

Unit 1 2 3 4 5 6 7 8 9
Ib 0.10 0.10 0.12 0.10 0.11 0.11 0.11 0.15 0.13
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60 Ib
The standard specific weight of wheat is Tha" Therefore:

1.031b
Vol(bu) = —b = 0.0171667 bu
60 —
bu
The area is:
lac 7 x 26in 1ft
A = — 25
@) = T3ss0 e © ( X T 12 in)
x | 9 unit x 6in X Lt
unit  12in
lac
=——X 170 ft x 4.5 ft = 0.017561983 ac
43,560 ft

The seeding rate in bushels per acre is:

bu\  0.0171667 bu bu
Uy _ 2OLPRO0T0U 99749 or0.98
<ac> 0.017561983 a0 -0/ 49 0r0.98 0

In this example, breaking the problem down into parts requires less math ability
than trying to determine the answer by using one equation. The basic equation is
relatively simple:

R (bu) _ Vol (bu) _ ny (rev)

ac) ” n(rev) A (a0)

But when the values are included to arrive at bu/rev and rev/ac the math is more
complicated. The first variable is determined by:

Vol (bu) 1 (bu) W (Ib)
n (rev)  y (Ib) Y (rev)

the second variable is determined by:

n, rev 1rev

Aac) 1t width  1ft Lac
. X Ny X — X - X
12in unit = 12in/ " 43,560 ft

7 x dia x

where n, = number of metering units. Putting the two parts together produces:

<@> W (Ib collected)

)~ E x Ny (rev)
Y \bu '

X

1rev
« dia x 1ft e Xwidthx 1ft y 1lac
& 12in " Tunit " 12in) ~ 43,560 fi2




Calibrating Grain Drills 103

The solution for the sample problem is:

bu 1.031b
Rla) = Ib
a 60( ) x 25 rev
1rev

1ft 6.0in 1ft 1lac
T X 26 X . x [9 x — X . X
12'in unit ~ 12in 43,560 ft?

_ 0.000687 bu 1rev
= rev 0.000703 ac

The desired planting rate is 1 bu/ac resulting in an error of 0.02 bu/ac. Is this
acceptable for planting wheat? This is an example when perfection is not expected,
therefore the level of acceptability must be established. Some drill manufacturers
publish acceptable seeding rates for their products, or this information may be
found in an extension bulletin. A standard has been established for grain drills.
The seeding rate should be within plus or minus of 5% of the desired rate. When this
method is used acceptable limits are set on each side of the desired rate. If the actual
rate falls within this limit, it is acceptable. In this example the upper limit (L) is:

b
Ly = 1.0+ (L0 x 0.05) = 1.05 a—z

X

=0.9767... or O.98b—u
ac

and the lower limit (L) is:

b
L, = 1.0 — (1.0 x 0.05) = 0.95 a—z

Using this standard, the accuracy of the grain drill is acceptable
(1.05 > 0.98 > 0.95).

The calibration of the drill is not completed until the uniformity of distribution
is also checked. This is accomplished by using the same rule and setting the limits
around the mean amount of seeds collected from the metering units. This will give:

W, 1.031b

Mean = = — =0.1144 ... 1b
ny 9 units

The distribution upper limit is:

b
DL, =0.114...+(0.114... x 0.05) = 0.1197 or 0.12 a—g
The distribution lower limit is:
bu
DL;=0.114... —(0.114 ... x 0.05) = 0.1083 or 0.108 P

A comparison of these limits to the calibration results shown in Table 8.2 indicates
that although the grain drill seeding rate is acceptable, the distribution is not. The
rate for metering unit #8 and #9 is above the upper limit. Both metering units
should be repaired before the drill is used.
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8.6. Calibrating Row Crop Planters

Row crop planters are used to plant crops in wider rows than those planted by grain
drills. Row crop planters are commonly used to plant large seeds, such as corn,
soybeans, and sunflowers, but are used for small seeded vegetable crops such as
radishes. Row crop planters will have a speed hopper, a metering unit, a seed tube,
a furrow opener and some type of closing or press wheels. Additional hoppers are
sometimes used for fertilizer or insecticides, Figure 8.5. The common metering
units for row crop planters are plate, disc, drum, and volume or bulk, but other
mechanisms are available. Plates are the traditional method for metering seeds,
but for most crops they have been replaced with discs. One style of antique plate
planter was designed to plant hills of seeds, but most plate and the modern disc
metering units singulate seeds. Singulating means each seed is selected from a
small volume of seeds and transferred to the furrow. When plates are used the
seeds are deposited in holes (cells) on the rim of a ground driven metering plate,
and as the metering plate rotates, the seeds leave the plate and fall into a furrow
that has been opened in the soil. The seeding rate is changed by using a plate with
a different number of cells, or by changing the drive train speed ratio between the
drive wheel and the metering unit.

Disc metering relies on air to hold the seeds in the cells. Two different designs
are used, based on air pressure either greater than or less than atmospheric. One
type uses pressurized air to hold the seed in a vertical seed plate and when the
air is shut off, the seeds drop into the opened furrow or are blown into tubes that
deliver them to the opened furrow. The other type of air planter uses a vacuum to
hold the seeds in the cells in the seed plate.

The drum type of metering unit works on the same principles as the pressurized
air disc planter. The primary difference is that the drum has a ring on holes for each
row instead of a separate metering unit for each row. Each drum usually singulates
seeds for either 6 or 8 rows. The metering rate can be adjusted by changes drums
and varying the speed between the drum and the drive wheel.

FIGURE 8.5. Single unit of row crop planter.
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A few manufacturers produce a volume type metering unit that looks like and
operates like a grain drill metering unit. The seeding rate (seeds/acre) for the
volume metering unit is determined by the speed at which the metering unit operates
in relation to the ground speed of the planter.

8.6.1. Stationary Calibration

Both bulk and singulating row crop planters can be calibrated stationary by fol-
lowing the procedure used for stationary calibration of fertilizer applicators and
grain drills. When the stationary method is used, the seeding rate is calculated by
dividing the seeds planted per revolution of the drive wheel by the simulated acres
covered per revolution of the drive wheel, when the stationary method is used or:

sd

=

R= A

ny

This equation can also be written as:

sd n
R=" x —
n, A

where R = seeding rate (seeds/ac); sd = number of seeds; n, = number of revo-
lutions of drive wheel; A = area.

Problem: What is the planting rate for corn when 0.22 Ib of seeds were weighted
after the 18.0 inch drive wheel was turned 25 revolutions? The planter is set for
36 inch rows and the seed size is 1,500 seeds per pound.

Solution: When calibrating row crop planters the area used is determined by the
row spacing and the distance traveled during the calibration, or the simulated
distance traveled.

A=wxd
where A = area (ft?); w = row spacing (ft); d = distance (ft).

R (Ib) _ W (Ib) n (rev)

ac) ", (rev) * A (ac)

_0.22 Ib 8 1rev
~ 25rev . 1ft lac .
18.0in x —— — in x —
“12in T “azse0fe <7 12in
0.22 1 0.22 Ib
_ = =27.114... —
25 3245 E—4 81136...E—3 ac
The planting rate in seeds per acre is:
R ﬁ _ 27.114...1b 5 1,500 sd _ 40672.36 or 40,700 ﬁ
ac ac 11b ac
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8.6.2. Mobile Calibration

All row crop planters are easy to calibrate using the mobile method because for
each row spacing and planting rate there is a unique spacing for the seeds in the
row. To complete a mobile calibration of a row crop planter seeds are added to the
hopper, the planter is lowered into the ground and driven for a short distance to
insure the system has stabilized. Next carefully uncover several seeds in a row and
measure the distance between the seeds. The average distance is used to determine
the seeding rate.

Problem: The calibration of a row crop planter, set for 20 inch rows, deter-
mined soybean spacing of 2.24, 2.23, and 2.25 inches. What is the planting rate
(sd/ac)?

Solution: First determine the mean distance between seeds in the row.

2.24 4227+ 2.25
Mean distance = + 3 + =2.241in

sd 1sd 12in  43560ft> lrow 12in

— = " X X X - X

ac 2.24in 1ft 1ac 20in 1ft
_ 6272640
T 448

Sometimes it is useful to know the in-the-row seed spacing for the planting rate.
This can also be determined using by using units cancellation.

= 140014.28 ... or 140,000 or 1.40 E5 ;

Problem: What is the spacing in the row (in/seed) for 40,000 plants per acre when
the planter plants rows 28.0 inches apart?

Solution: Using units cancellation:

in lac 43560 ft* 144in> 1row
—_ = X X X
seed ~ 40,000 seed 1ac 1ft? 28in
6272640 row-in
= —_ =560057...0r5.60
1120000 or seed

Is this the correct answer? The units in the answer do not match the desired units.
Itis correct because it is common practice to drop off the unit of row in the answer
and just use in/sd.

When doing a few calculations it would be appropriate and preferred to complete
the problem as in this example by using the units cancellation method. This would
not be true if the in-the-row spacing needed to be calculated many times. In this
situation it is easier to use an equation. In Chapter 1 the source of many equations
was identified as units cancellation calculations where the consistent numbers were
reduced to a constant. Combining the consistent units in the previous problem
(43,560 ft> x 144 in?) produces the constant 6.273 E6. The seed spacing in the
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row can be found by the equation:

6.273 E6

55 =50p xRS

where SS = Seed spacing in the row (in); POP = Population, planting rate
(seeds/ac); RS = Row spacing (in).

If the seeding rate is not correct, further evaluation of the planter must be made.
Because the metering unit is ground driven, the source of the error may be in the
drive train ratio between the drive wheel and the metering unit.

8.7. Air Seeders

Air seeders, Figure 8.6, have become the machine of choice for planting wheat
and other crops in large fields. Seeders with effective widths of 70 to 100 ft are
being used. The basic design is a seed cart pulled behind a field cultivator or
other secondary tillage machine that has soil engaging tools mounted on shanks.
The seed cart may have one or more hoppers. When multiple hoppers are used one
hopper will be for seed and the other(s) can be used for fertilizer or other materials.
Each hopper will have either a single ground driven metering unit that splits into
multiple air streams, or multiple air streams with a metering unit for each. At the
metering unit the seeds are divided into several tubes and flowing air delivers the
seeds to a splitter manifold. The splitter manifolds divide the seeds into a stream
for each shank. As air seeder technology has developed, more sophisticated soil
opening devices and metering units have been developed, but the basic design is the
same.

Most manufacturers state that air seeders can be calibrated using stationary or
mobile methods, but the seeding rate for some air seeders calibrated stationary
may be less than the actual rate in the field. For this reason the mobile calibration
is recommended.

FIGURE 8.6. Air seeder.
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8.7.1. Mobile Calibration

Mobile calibration methods are the same for air seeders as for grain drills. One
difference is the number of rows that must be collected. Air seeders are so large
that it is not practical to collect all of the rows. Recommendations for the number
of rows that should be collected vary, but 25% is a general recommendation. The
appropriate number of seed hoses are disconnected from the individual seed tubes
and connected to a bag or other collection device. The seeder is driven a fixed
distance, 100 to 200 ft and the material is weighed from each bag. With this
information and knowing the effective width of each shank the seeding rate or
application rate can be calculated.

Problem: Determine the seeding rate (Ib/ac) for a 50-ft air seeder with a 10.0 inch
spacing. The following quantities of seeds were collected from every 4th shank on
a single row during 200 ft of travel, Table 8.3.

Solution: The first step is to determine the total amount of seeds collected.

Total Pounds = 0.34 + 0.33 4+ 0.33 + 0.36 + 0.34 + 0.35 + 0.35+ 0.33 + 0.34
+0.34+0.35+40.35+0.3340.34 +0.34
=5.121b

The next step is to determine the area: [Note: For calibration purposes the effective

TABLE 8.3. Quantity of seeds
collected during calibration
of air seeders.

Collector Ib

0.34
0.33
0.33
0.36
0.34
0.35
0.35
0.33
0.33
0.34
0.34
0.35
0.35
0.33
0.34
0.34
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area is the number of shanks times the spacing between shanks.]

Area (ac) = M X ﬂ x 16 row x 200 ft x L
row ~ 12in 43560 ft?
32000
= =0.06121... or 0.061
522720 orv.ohtac

The air seeder applied 5.45 Ib of seeds in 0.61 acre. The last step is to determine
the pounds of seed per acre.
_ Pounds  5.121b
~ Acre  0.061ac

The air seeder is applying seeds at the rate of 83.9 Ib/ac. It is up to the
owner/operator to determine if this is an acceptable level of performance.

=83.934... or 83.9 b
ac

8.8. Calibrating Sprayers

Accurate calibration of spray equipment is very important because with only slight
changes the application rate may cause chemical damage to the crop or the envi-
ronment, be wasteful of materials, or be ineffective. There is one important differ-
ence between the design of fertilizer spreaders, grain drills, row crop planters and
sprayers. The method used to control the flow rate of the material for a sprayer is
not normally ground driven. The application rate (gal/ac) is a function of the flow
rate of the nozzles (gal/min) and the speed of the sprayer (mi/hr). The flow rate
from the nozzles does not change as the ground speed changes. The exception to
this statement occurs when an application rate controller is added to the sprayer.
Most application rate controllers vary application rate to compensate for changes
in applicator speed. This is generally done by changing the operating pressure of
the sprayer. When a rate controller is not used, the speed of the sprayer must be
considered in calculating the application rate.

Figure 8.7 illustrates the common parts for the typical overlapping boom sprayer.
Overlapping boom sprayers consist of tank, filter, pump, means to control the
pressure, multiple sections of nozzles, and boom selection valve. The mixture
in the tank flows through the filter to remove any particles that might plug the
orifice in the nozzles, and then to the pump. One of several types of pumps is
used, depending on the flow (gal/min) and the pressure (psi) needed by the system.
From the pump the mixture goes to the pressure regulating valve. In some sprayer
designs, a portion of the flow from the pump is returned to the tank for agitation
to prevent the spray materials from separating. Any excess flow produced by the
pump also is returned to the tank by the pressure regulating valve. From this
valve the fluid is pumped to the boom selector valve. At some point in this line
a connection is made for a pressure gage. The boom selector valve directs the
flow of the mixture to the different sections of the boom. In some types of valves
provision is made for a handgun. A handgun is very useful for spraying skips or
along fencerows and other obstructions.
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FIGURE 8.7. Parts of a typical boom sprayer.
One popular selector valve design has seven positions:

. All outlets off

. All booms on

. Left boom on

. Center boom on

. Right boom on

. Handgun on

. Booms and handgun on.

~No ok~ WwWwN P

In the typical design, the pump can be engine, power take off (PTO), or hydraulic
motor driven. As long as the pump is operating and the selector valve is in one
of the on positions, fluid will flow. It is important to understand the effect ground
speed has on the spray application rate (gal/ac). When a sprayer operating in the
field slows down, the application rate increases. This occurs because the nozzle
flow rate (gal/min) is constant. When the travel speed is reduced the same amount
of material is applied to a smaller area.

gal  gal min
_— = — X —
ac min  ac
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FIGURE 8.8. Nozzles arranged for
banding between the rows.

When the travel speed is reduced, the acres per minute (ac/min) are reduced.
Conversely, when the sprayer travel speed increases, the application rate decreases.
Therefore, precise control of the sprayer speed is very important.

The design shown in Figure 8.7 often is modified to meet the demands of
different types of plants or application methods. Two additional examples are
shown in Figure 8.8 and Figure 8.9.

The application rate (gal/ac) of a field sprayer is controlled by three factors:

1. The speed of the sprayer (mi/hr).
2. The rate of discharge from the nozzle (gal/min).
3. The width covered by one nozzle (in).

Arranging these variables into one equation produces the standard sprayer
equation:

_5940xQ
T Vxw

R

where R = application rate (gal/ac); 5940 = units conversion constant; Q = flow
rate per nozzle (gal/min); V = travel speed (mi/hr); w = nozzle spacing (in).

Note: Use either the flow rate (gal/min) from one nozzle and the spacing between
two adjacent nozzles, or the flow from all nozzles (gal/min x number of nozzles)
and the total width of the sprayer (w x number of nozzle). In either case, the
application rate (gal/ac) will be the same. Do not interchange these values.

The calibration of a sprayer is a multiple-step process. In addition, the process
can be started at different points, depending on which one of the three variables
(speed, nozzle flow rate, or application rate) is selected first.

FIGURE 8.9. Nozzles arranged for
row crop sprayer.
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Problem: What size of nozzles (gal/min) is required for a boom type sprayer to
apply 20.0 gal of spray per acre? The sprayer has 24 nozzles spaced 18.0 inches
apart.

Solution: Because the application rate of field sprayers is speed-dependent, begin
by selecting a reasonable speed that can be maintained in the field, and then
determine the size of nozzles needed. For this problem we will use the typical
speed (Appendix V) of 6.5 mi/hr. The required flow rate for the nozzles can be
determined by rearranging the standard sprayer equation to solve for the flow rate

(gal/min).
5940 x Q (ga' )

(32 e
ac

mi .
v (h—r') « w (in)
20.0gal 6.5 mi .
o G\ RxVxw 1a X pr x 18.0in
min/ 5940 - 5940
2340 gal

= 2940 = 0.3939... or 0.39 min

For this application rate and nozzle spacing, nozzles with a capacity of 0.39 gal/min
should be installed on the sprayer. Before it is used, the sprayer should be calibrated
to ensure that the application rate is correct because small variations in the con-
struction of the nozzles or in the pressure at the nozzles can cause an unacceptable
error in the application rate.

Assume the operator installed the 0.39 gal/min nozzles on the sprayer and pro-
ceeded with the calibration.

Problem: A container placed under all 24 nozzles of the sprayer collected 14.40
gal of spray in 2.0 min of operation. The desired application rate was 20.0 gal/ac.
Is the sprayer accurate?

Solution: In this example only the total volume is known. One alternative is to
determine the average flow rate per nozzle and then use the sprayer equation, but
this process will not be as accurate as using the units cancellation method and the
total flow rate:

gal\ 14.40gal _60.0min  1hr 1mi 43560 ft>  12.0in
= 20min < 1hr < 65mi 5280t .  lac . 1ft

ac
1 nozzle 1
X . X
18.0in 24 nozzles
451630080 gal

20652480 — L2307 or1S oo

The desired application rate was 20 gal/ac, but the calibration indicates that the
application rate is 5 gal/ac less than this (20 gal/ac —15 gal/ac). It is important to
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check the label of the chemical to determine if this is an acceptable application
rate. If the error is unacceptable, how do we reduce it? The first step is to check the
filters and nozzles of the sprayer to make sure that one or more were not slightly
restricted. If all of the nozzles are in proper working order, the sprayer must be
adjusted to apply the correct rate.

Adjustments can be made in the speed and/or the system pressure. To adjust the
speed the sprayer equation can be rearranged to calculate a new speed of travel.
Adjusting the pressure is not as effective because only a small amount of change
in the application rate can be made by adjusting the pressure. The pressure must be
doubled to increase the flow rate by 41%, and modern boom type sprayers operate
within a narrow pressure range. For this problem we will adjust the speed of travel.

Units cancellation could be used, but this time we will rearrange the sprayer
equation to solve for the speed of travel. Because the sprayer equation requires
the flow rate per nozzle, we will determine the average flow rate per nozzle. This
average provides an acceptable level of accuracy.

Q gal _144gal gal
nozzle  No.nozzle 24nozzles ~ nozzle
and because the spray was collected for 2 min:
al al
9\ pe0 &
min_ | _ r

= — = 0.30 gal/min/nozzle
nozzle 2.0 min gal/min/

For convenience, the unit “nozzle” usually is not used; gpm = 0.30. Then:

5,940 x Q <g—a')

| .
() vt

. 5940xQ (g—al)
()

min

gal .
R (2% in
(%)Xw()
|
5,940 x 0.30—2 1782
_ = 1min _ 360 = 4.95 or 5.0 mph
200~ x 181in

If the speed of the sprayer is changed from 6.5 to 5.0 mi/hr, the sprayer will apply
the correct rate.

Although the preferred way of calibrating a sprayer is to determine the nozzle
size first, this method requires the purchase of a new set of nozzles if the correct
size is not available. In some situations the nozzle size is selected first (the best
available), and then the required speed of travel is determined. When this method
is used, the calculated speed of travel may be unrealistic.
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Problem: We need to apply 15.0 gal of spray per acre. Only one set of nozzles is
available, and they have a capacity of 0.25 gal/min. The sprayer has 35 nozzles
spaced 24.0 inches apart. What speed will be required to apply the correct rate?

Solution: The sprayer equation could be rearranged to solve for speed. Instead we
will use the units cancellation method.

gal
mi 1mi  43560f2  1ac 92T 60min
— | = X X X X
hr 5,280 ft ac 15.0 gal nozzle 1hr
12in 1
X — X "
1ft 24.0in
7,840,800

mi
= 1900800 — 4.1250r4.1 hr
In this problem, if the sprayer is operated at 4.1 mi/hr, the correct rate will be
applied.

Other types of sprayers can be calibrated by using these methods if the appro-
priate adjustments are made for differences in how the area and the application
rate are determined. For example, to calibrate the row crop sprayer in Figure 8.9,
the width becomes the distance between the rows, and each nozzle should apply
one third of the required flow (gal/min) per row.

Sprayers used for banding also can be calibrated. In checking a sprayer used for
banding, the nozzle spacing (w) becomes the width of the band, Figure 8.8.

8.9. Preparing Spray Mixes

A very important part of chemical application is the proper preparation and mixing
of the chemical and the carrier (usually water). The application rates of most
chemicals are given in terms of pounds of active ingredient to be applied per acre.
The concentration for a liquid chemical is usually printed on the label. A typical
material might contain 4 Ib of active ingredient per gallon. Wettable powders
(WPs), on the other hand, are specified as a certain percent strength, such as a 50%
or an 80% WP, which means that 50% or 80% of the weight of the material in the
container is the active ingredient. The rest is inert material (carrier).

Problem: You need to apply 2.0 Ib of active ingredient of an 80% WP in a
30.0 gal/ac dilution. The sprayer has a 100.0-gal tank, how many pounds of WP
are required to mix 100.0-gal of spray?

Solution: To obtain 2.0 Ib of active ingredient, 2.5 Ib of powder would be required
(80% of 2.5 = 2.0). If the solution is to be applied at 30 gal/ac, mix 2.5 Ib of 80%
WP in each 30 gal of water. The tank holds 100 gal or 3.33 units of 30 gal. Because
2.5 Ib of WP should be added to each 30 gal of water, you should add 3.33 x 2.5
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or 8.33 Ib of WP to each 100 gal. Or by ratio:

251b WP B W Ib WP
30.0 gal H,O = 100.0 gal H,0O
WIb WP = % =8.33... or 8.33 Ib 80% WP

To mix the spray, add 8.33 Ib of WP to a partially filled tank, mix it thoroughly,
and add water to make 100 gal of mixture. During spraying this mixture must be
continuously agitated to prevent the WP from settling.

Preparing a mix using liquid chemicals can be accomplished with the same
procedures.

Problem: A liquid concentrate contains 2.0 Ib of active ingredient per 5.0 gal. The
desired rate is 1.0 Ib of active ingredient per acre at a rate of 20.0 gal of chemical
and water (solution) per acre. If the sprayer tank holds 180.0 gal, how much water
and how much concentrate should be used for each tank full?

Solution: If the liquid contains 2.0 Ib of active ingredient per 5.0 gal, then 2.5 gal
would contain 1.0 Ib of active ingredient. Thus, for each acre 2.5 gal is mixed with
17.5 gal of water (20-2.5) to get 20 gal of spray. By ratio:
2.5 gal concentrate  V gal concentrate
20.0 gal solutiion ~ 180.0 gal solution
2.5 x 180.0
20.0

V = volume in gallons and 180 gal — 22.5 gal = 157.5 gal. Thus, for every tank
22.5 gal of chemical is mixed with 157.5 gal of water.

V gal water = = 22.5 gal concentrate

8.10. Metric Problems

Problem: Determine the application rate (kg/ha) for a fertilizer spreader that ap-
plied 52.5 kg of material during 15 revolutions of the drive wheel, which has a
diameter of 0.53 m. The effective width of the spreader is 0.76 m.

Solution:
R <@> _ Wik n(rev)
ha ne (rev)  A(ha)
52.5 kg 1rev 10,000 m? 1
T 15rev 314x053m . ha . 0.76m
525,000 k t
= Lo = 2767253, 0r 27,000 h—g or 27

Problem: Determine the acceptability of the seeding rate for a grain drill when the
desired rate is 9.0 kg/ha. The drill has 25 metering units with a 0.20 m spacing. The
drive wheel has an effective diameter of 80 cm. During the stationary calibration the
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TABLE 8.4. Data for grain drill calibration in Sl units.

Unit 1 2 3 4 5 6 7 8 9 10 11 12
Grams 22.6 224 220 229 227 226 220 228 228 227 226 228

drive wheel was rotated 50 times. The following amounts of seeds were collected
from 12 of the metering units, Table 8.4.

Solution: The seeding rate is determined by calculating the quantity of seed for
the area and then converting the results to the desired units.
The quantity collected is:
Total = 22.6 + 22.4 + 22.0 + 22.9 + 22.7 + 22.6 + 22.0 + 22.8 + 22.8
+22.7+22.6+22.8
= 270.9 g or 0.2709 kg
The area is:

A (ha) = No. Units x w(m) x d(cm) x & x n,

. m 80cm x 7 1m 1ha
:12 units x 020 m X T X 50 rev x 100 om X 10'000 m2
30159.28. ..
The seeding rate is:
0.2709 kg kg

R (kg/ha) = =8.982... 0r89

0.03015...ha

The acceptability of the drill performance is determined by establishing the upper
and lower limits using the 10% rule.

Upper = 9.0 x 1.05=94

Lower = 9.0 x 0.95 = 8.6
Based on the 10% rule the performance of the grain drill is acceptable because
9.4 > 8.9 > 8.6.

Even though the seeding rate is acceptable, the distribution pattern of the drill
should also be checked.

270.9
Mean = 9 2575

Upper limit = 22.575 x 1.05 = 23.703... or 23.7 g
Lower limit = 22.575 x 0.95=21.44... or21.4 ¢

The distribution pattern is acceptable because all of the quantities for each metering
unit are within the upper and lower limit.

Problem: Determine the plants per hectare for a row crop planter when the average
seed spacing is 11.5 cm in the row and the row spacing is 70 cm.
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Solution:
R (sd) 10,000 m? 100 cm 1 sd 100 cm 1

_— X X X X
ha 1ha m 11.5¢cm m 70 cm

= @ = 124223.6025 or 124,000 or 1.24 E5 Sd—s
805 ha

Problem: Determine the seeding rate for a 10.8-m air seeder with 18 cm row
spacing when 13 kg of seeds were collected during 50 m of travel.

Solution: Since we have collected seed from all rows we do not need to consider
the row spacing.

R (k9 W (kg) W (kg) 10,000 m?
—_— = = X
ha A (ha) I (m) x w(m) ha
13 kg 1 10,000 m?
X X
50m 10.8m 1 ha
1.3E5 kg

Problem: Determine the size of nozzles (L/min) required to apply spray at the rate
of 185 L/ha when the nozzle spacing is 0.4545 m and the sprayer will be traveling
at a velocity of 4.0 km/hr.

Solution:
L L 1 ha km 1hr 1,000 m
— o — 0.45
Q <min> ha ™ 10,000 m2 “hr “60omin © km m

_ 3.33E7
" 6.0E7

= 0.555 or 0.56 L
min
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Equipment Efficiency and Capacity

9.1. Objectives

1. Understand the concept of efficiency and be able to apply it to agricultural
operations.

2. Understand the concept of capacity and be able to apply it to agricultural ma-
chines.

3. Beableto calculate effective field capacity.

4. Be ableto calculate the throughput capacity of agricultural machines.

9.2. Introduction

To be efficient means being able to produce the desired results with a minimum
of effort, resources, or waste. This is a concept that permeates our lives. A part
of every occupation is the desire to improve the product or services by producing
more for less or a better product for the same input. Engineers are constantly
trying to improve the efficiency of operations by reducing the energy requirements
and/or wastes from agricultural and manufacturing processes. When referring to
machinery, efficiency is an evaluation of how well amachine does the tasks that it
is designed to perform.

Capacity is a measurement of the amount of performance that has occurred.
The evaluation of a machine's capacity is an important evaluation because under
utilization of a machine increases the production costs and over utilization can
lead to increase repair, maintenance costs, and shorten machine life.

9.3. Efficiency

Inthischapter, wewill usethe concept of efficiency to evaluate how well amachine
performs its designed task in terms of quantity and/or quality of performance.
Owners and managers of farm enterprises are deeply concerned with efficient
operation of equipment and other resources because inefficient operation leads to

118



Efficiency 119

greater operating expenses and reduced profits. Efficiency isusually expressed asa
percentage. A percentageis calculated by comparing to quantities and multiplying
by 100. Because efficiency is aratio of two quantities having the same units, the
units cancel.

Efficiency can be expressed mathematically in several forms. Inthe most general
terms, efficiency can be expressed as:

output

Efficiency (E) = input

100

Efficiency isthe ratio of what we get out of something relative to what we put in.
If the output is 9 units (pounds, hours, etc.) and the input 10 units, the efficiency
is:

output

9
%E = - x 100 = — x 100 = 90%
input 10

Or, if the output is 5 units and the input 10 units, the efficiency is:

OUPUt 100 = > x 100 = 50%
put 10

%E =

Efficiency can also be determined by comparing the actual performance to the
theoretical performance. Thisequationiis:

one _  actual
*E = fheorectica < 1%

It isimportant to remember that an efficiency cal culation provides a mathemat-
ical answer to aproblem. It isonly atool or information that can be used to make
adecision. For example, if you determine that the fuel efficiency of an automobile
is 20 miles per gallon that is not sufficient information to determine if the auto-
mobileis performing satisfactory. This number must be compared to the historical
performance, manufacturer’s guidelines or other data to make a decision on its

acceptability.

9.3.1. Mechanical Efficiency

Mechanical efficiency has to do with how well machines convert energy from
one form to another. For example, an internal combustion engine converts the
chemical energy in fuel into power. Internal combustion engines are not 100%
efficient because al the energy in fuel is not converted power (the majority of
the heat produced escapes through the radiator and out the exhaust). A typical
gasoline engine is about 22% efficient; a diesdl engine is 30 to 33%. An electric
motor converts electrical energy into power with an efficiency of 95 to 98%.
The efficiency of mechanical power trains and other mechanical devices can be
determined if accurate numbersfor the power in and power out can be determined.
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9.3.2. Performance Efficiency

Performance efficiency refers to the quality of work done by a machine. The
importance of a performance evaluation is not the same for all machines. For
example, the quality of the job for primary tillage, like plowing, is not as critical
to the profitability of the farming enterprise asthe quality of thejob for acombine.
In addition, it would be very difficult to mathematically evaluate the quality of
plowing.

For a harvesting machine, performance efficiency is a measure of the actual
performance of the machine compared to the desired performance. For example,
if the machine was a combine, we could measure the bushels of grain harvested
compared tothetotal bushelsof graininthefield. Combinesalso could beevaluated
according to the amount of damaged grain. Other harvesting machines could be
eval uated on the basisof theamount of bruising of fruit or on the number of cracked
shells. An exampleisthe small grain combine.

A combine can lose grain in three different ways:. the gathering unit can shatter
grain from the head or drop heads, the threshing unit can fail to remove grain from
the head as it passes through the machine, and the separating and cleaning units
can fail to separate the grain from the material other than grain (MOG). The losses
are usually expressed as a percentage of theyield of the field.

Evaluating combine losses is a multiple-step problem. What we want to know
isthe amount of grain that the combine failsto put into the grain bin. Thefirst step
in evaluating the performance of a combineis to determine if a problem actually
exists. Thisisaccomplished by determining the total loss behind the machine.

To determinetotal loss, aknown areais marked out, and grain is counted on the
ground behind the combine. Losses at this point include grain on the ground before
the combine started (preharvest 10ss) and grain loss by the combine (machineloss).
For most cereal grains, losses are determined by counting the number of grainsin
aknown area, for example, 10 or 100 squarefeet. Thiswill provide datawith units
of seeds per unit area. The table in Appendix |11 can be used to convert seeds per
square feet (sds/ft?) to bushels per acre (bu/ac) or seeds/m? to kilograms/ha.

Problem: What isthe performanceefficiency (percent) inlost grainfor thecombine
shown in Figure 9.1?

Solution: Figure 9.1 representsthe results of measuring thelossesfrom acombine.
Thefirst step is to determine the total losses. In the example illustrated in Figure
9.1, 162 seeds of wheat were counted in a 10-square foot area behind the machine.

By referring to Appendix 111, we can convert the total |osses from the measured
quantity of seeds per 10 square feet to bushels per acre. From Appendix I11, 20
seeds per square foot equals one bushel per acre. Applying the units cancellation
method:

bu

1 -
b 162 seeds 162 b
bu _ e & % 085060r 0.85 —
ac 10 ft 19 seeds 190 ac

ft?
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FIGURE 9.1. Determining performance efficiency of a combine.

Note: The previous equation may be easier to understand by remembering that
when dividing fractions, inverting and multiplying is the same operation. The
previous equation can be written as:

bu 162 seeds bu 1ft?
—=——-—x1—x
ac 10 ft? ac = 19 seeds

Isalossof 0.85 bu/ac an acceptablelevel of lossfor this machine? Asnoted earlier,
themathematical cal culationsdo not usually answer the question; they just provide
information to make amore informed decision. The two common methods used to
makeinformed decisionsareto comparetheresultswiththe historical performance
of the machine and to compare the results to an accepted standard. Research has
shown that under favorable conditions an expert combine operator should be able
to keep losses to less than 1%, but that losses up to 3% are typical. Therefore to
determine the acceptability of the combine performance, the total losses must be
compared to the standard. To determine the loss as a percentage two values with
the same units must be used. This is usually done with combines by comparing
the loss and the crop yield (bu/ac).

For this example we will assume that the wheat is yielding 30 bu/ac. The total
loss percentage (L{%) is:

bu
L, 08—
L% = v = bﬂc x 100 = 2.833... or 2.8%
t 30 =
ac

where Y, = the total yield in sd/ac, bu/ac, sd/m?, or kg/ha

. bu kg

Y. = [ —or —
L = vield loss, - or ha
. bu kg

Y; = —or —
+ = total yield, - or ha
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Based on the less than 3% standard, this machine's performance would be consid-
ered acceptable. If the 1% standard was the desired performance level, additional
calculations must be completed to determine the source of the excessive grain
loss.

At this point it is important to remember that total loss is a combination of
machine loss and preharvest 1oss. An unacceptable total [oss does not necessarily
mean thereisaproblem with the combine. The source of the unacceptabletotal |oss
may be preharvest |osses. The combine has noinfluence on theselosses. Preharvest
loss is measured by counting the grain on the ground in the standing crop that has
not been harvested. In Figure 9.1, we note that preharvest |osses are 5 seeds per
10 square feet. Therefore, the machine loss in bushels per 10 square feet is:

Machineloss (L) = total loss (L) — preharvest loss (L )

162 sds 5sds
~10f2 10ft?
_ 157 55
10 ft?
Converting this value to bushels per acre:
1 bu
seeds P 157 bu
Lyp =157 —— L _ _ = _0826... —
m 1072 _seeds ~ 190 a
19—
1ft
Converting this to a percent:
0.83 @
Lm=——2 x100=2.754... or 2.8%
bu
30 —
ac

Rounding to two significant figures, the total loss and machine loss are both 2.8%.
The preharvest lossis too small of a percentage to be measured.

It can now be concluded that, if the 1% standard is used, the losses are excessive
and the machine is the source of the excessive losses. When this occurs, it is
necessary to determine which component of the machine is the source of the
losses.

The first step isto check the gathering unit. The performance of the gathering
unit (header) is checked by counting the seeds on the ground between the header
andtheuncut crop. 9.1 showsthat thelossesin thisareaare 12 seedsper 10.0 square
feet. (Remember that this also includes the preharvest losses.) The gathering unit
(Lg) losses are determined by subtracting the preharvest loss from seeds counted
in the area between the header and the uncut crop.

_1ZSeeds SSeeds_7seeds_ seeds
97 100ft2 100ft2  10ft2  ft?
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Converting this value to bushels per acre:

bu
1=
b seed 0.7 b
Hoor =B & =l 003680r0.04 —
ac ft 19 seeds 19 ac
ft?
or asapercent:
bu
0.04 —
Tﬂc % 100 = 0.13%
30 —
ac

This shows that the gathering unit losses are 0.13%, a very small part of the total
machine |osses.

When the preharvest |ossand the gathering unit losses are both low, the threshing
and separating units must be checked.

Threshing losses are represented by heads or cobs on the ground behind the
machine with grain still attached. Cleaning and separating losses are represented
by grain on the ground behind the machine that is not preharvest or gathering unit
loss. Cleaning and separating losses can be determined by subtraction:

Lc&s= Lt - Lp - Lg - Lth

where L g s = Cleaning and separating losses; L; = Total losses; L, = Preharvest
losses; Ly = Gathering unit losses; Ly = Threshing losses.

LC&S: Lt—Lp—Lg—Lth

s s d s
162 o 5 7 g
101 ~10f¢ ' 10f¢ 10ft
sds
=150 ——
101t

Note that the threshing losses are listed as zero. Thisis because theinformation is
not available to determine this loss. The threshing and separating loss percentage
is:

bu 150 sds bu 1ft® 150 bu
s Vg = —0.789...0r0.79 —
a_ 10f¢ <" a < 19sds _ 190 oroP =
0.79 !
% = & 100 =2.631... or 2.6%
bu
30 —
ac

Clearly, if the desire is to improve the performance of the combine the cleaning
and separating units should be adjusted or repaired.
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9.3.3. Field Efficiency

Field efficiency isusually used to eval uate the performance of tillage or harvesting
machines. It is a comparison of the actual amount of “work” (volume of activity,
not Force x Distance) done by a machine compared to what it would do with no
lost time or capacity. The maximum rate that amachine can performisdetermined
by the width of the machine and the speed of travel. When a machine operates
with aconstant width and travels at aconstant speed, it will perform at 100% field
efficiency. A machine is capable of operating at 100% field efficiency for short
periods of time, but as soon as the speed changes (slow down for turns, etc.), or
the width changes (overlap width of the machine to prevent skips), the efficiency
drops below 100%. The primary cause of loss efficiency islost time (unproductive
time) and a working width of the machine less than the maximum. Typical field
efficiencies for common machines can be found in Appendix 1V. This concept is
illustrated in more detail in the next section, on capacity.

9.4. Capacity

Theterm capacity is used to evaluate the productivity of amachine. In agriculture,
two types of capacity are commonly used, field capacity and throughput capacity.
Field capacity is used to evaluate the productivity of machines used to work the
soil, such as plows, cultivators, and drills, sprayers, and harvesting machines.
Throughput capacity is used to describe machinesthat handle or processaproduct,
such as grain augers, balers, forage harvesters, and combines.

An additional concept relating to both types of capacity is the difference be-
tween theoretical and actual productivity. If a tillage machine operates at 100%
efficiency, it is operating at 100% capacity. Thisis called the theoretical field ca-
pacity. Theoretical field capacity isdetermined using the width of the machineand
the speed of travel. It can be calculated using units cancellation, but an equation
is commonly used.

Sx W

8.25
where Ct = Theoretical field capacity (£); S = Speed of travel (?]—r‘); W = Width
of the machine (ft); 8.25 = Units conversion constant (43,560 g) + (5,280 %)_

This equation can be used as long as the unit used for speed is miles per hour
and the unit used for the width of the machine is feet.

Theoretical field capacity(Cy) =

Problem: Determinethetheoretical capacity for amachine that travelsat 5.0 mph
and has an operating width of 20.0 ft.

Solution:

mi

ac
Cr = =1212...0r12 —

8.25 8.25 hr
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When this machine travels at a constant speed and uses a constant width, it has a
theoretical capacity of 12 ac/hr.

Effective field capacity isthe amount of productivity that actually occurred not
what istheoretical possible. Lost capacity isan important concern for the machine
operator and/or manager because it represents lost revenues or resources. Usually
lost capacity is caused by lost time, time not operating, and operating the machine
with less than the maximum working width. Common causes of lost time include:

1. Mechanical breakdowns.

2. Taking time to adjust the machine.

3. Stopping to fill seed hoppers, spray tanks, etc.

4. Slowing down to turn at the end of the row or crossing waterways, etc.
5. Operator rest stops.

The equation for effective capacity isthe same as theoretical capacity with afield
efficiency added. A range and typical field efficiency valuesfor common machines
can befound in Appendix 1V. The common equation for effectivefield capacity is:
S x W x Ef
Ce= 8%
where Cg = Effective field capacity (ac/hr); S = Average speed of travel (mph);
W = Effective width of the machine (ft); E; = Field efficiency (decimal form).

Problem: Assume that the operator in the previous problem averages 0.75 hr of
lost time per 10.0-hr day. What is the effective field capacity?

Solution: Thefirst step isto determine the time efficiency:
output 10.0hr — 0.75 hr
input 10.0 hr

The second step is to determine the effective capacity:

SxW x Ef 50mphx20.0ftx0925 955 a
Ce — _ T
E 8.25 8.25 8.25 o

Now the effects of lost productivity are apparent. The theoretical capacity is
12 ac/hr, but because of lost time, the effective capacity is 11 ac/hr.

The concept of effective capacity also can be used to determine the amount of
time it would take a machine to cover afield.

= 92.5%

Problem: How many hourswill it taketo cultivate 200.0 acreswith afield cultivator
that is 24.0 ft wide?

Solution: Thisis an example of a problem with a hidden intermediate step. Be-
fore the hours can be determined, the effective capacity of the machine must be
calculated. Note: The effective capacity equation requires three values. Two of
these, speed and field efficiency, are not given in the problem. If the actual speed
and the field efficiency are unknown, the typical valuesfound in Appendix IV can
be used. In Appendix 1V, the typical field efficiency for afield cultivator is 85%,
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and the typical speed is 5.5 mph. With these values, the effective capacity can be
calculated:

mi

ac
Ce= =1360r14 —

8.25 - 8.25 825 hr

Once the effective capacity is known, the time required to work the field can be
calculated. Using units cancellation:

hour = 1_hr x 200ac=14.28... or 14 hr
14 ac

If the average field speed is 5.5 mph and the operator can maintain an 85% field
efficiency, it will take 14 hr to cultivate the 200 acre field.

9.5. Throughput

The concepts of theoretical and effective capacity also are applicableto throughput
capacity. Throughput is based on time, but because throughput usually refers to
the flow of material through amachine, the units may be different from those used
for capacity. For example, the performance of ahay baler could be evaluated using
units of bales per hour or tons per hour.

Problem: What isthethroughput of abaler if it baled 150.0 tonsin oneweek while
operating an average of 6.0 hr per day?

Solution: With the information given, different units could be used for the output.
These include tons/week, tons/day, or bales/day. The “correct” units are the ones
that match the input units. For this example, assume that the manufacturer adver-
tises that the baler has a capacity of 6 tons/hr. This means we need to determine
the output (effective throughput) in units of ton/hr.

ton 150.0ton 1week 1day 150 0 ton
— = X X = — =20 —
hr week 5day 6.0hr 30 hr

Knowing the actual throughput for the baler, the throughput efficiency can be
determined. The throughput efficiency is:

5Ot0n
tput ~ Thr
E= P 00— — P L 100=833... or83%
input 6.0 N
" hr

Assuming the advertised throughput of the baler is areasonable value, this opera-
tionisonly 83% efficient in baling hay.

The throughput of a baler also can be evaluated in units of bales per hour
(bales/hr). To use these units additional information is required, including the
weight of the hay (Ib/bale) and two unit conversion values.
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Problem: Determine the effective throughput in units of bales per hour when each
bale weighs 1,200.0 Ib.

Solution : No equation hasbeen presented to solvethisproblem. Thisisan example
where units cancellation should be used.

bales B 150.0ton 1week 2,000Ib 1 bale

hr week  ~ 30hr « 1ton . 1,200.01b
3.0E5 bales

Obviously, throughput can be expressed in many different ways depending on the
values being compared. Remember that efficiency is a ratio—both values must
have the same units. In addition, these examplesillustrate the usefulness of units
cancellation for solving problems of this type.

9.6. Metric Problems

Problem: Determinethetheoretical capacity for a20.0-mwide cultivator traveling
at 9.6 km/hr.

c ha S km (m) 1,000 m lha
— | = — | X X X
"\ hr hr v km 10,000 m?

1,000 m 1lha
X
km 10,000 m?

Solution:

=9.6k—m x 20.0m x
hr

_ 192,000 _ 192 E\
10,000 hr

Problem: What isthe effective capacity for the cultivator in the previous problems
if the operator wasted 0.75 hr per 10.0 hr working day?

Solution: Thefirst step isto solve for the time efficiency.
output

Efficiency (%) = 100
iciency (%) input %
10.0hr — 0.75 hr 9.25
= —— x100= — x 100 = 92.5%
100 100~ 0

The effective capacity is:

CE <h—a> =S <k—m> X U)(m) X 1’000 m 1ha X E|:

hr hr km 10,000 m?
1,000 m 1ha

km 10000 me " 9

= 9.6k—m x 20.0m x
hr
177,600 178 ha

10,000 " hr
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Problem: How many hourswill it take to cultivate 20.0 hawith an 8.0-m cultivator
traveling at 10 km/hr? Assume afield efficiency of 85%.

Solution: Thefirst step isto determine the effective field capacity.

h K 1,000 1h
CE<—a)=S<—m)xW(m)x m 2 Ef

hr hr km 10,000 m2
km 1,000 m 1 ha
=10 . x 8.0m x o X 10,000 nE x 0.85
_ 68,000 8 ha
~ 10,000 T hr

The second step isto calculate the amount of timeit will taketo cultivate 20.0 ha
with afield capacity of 6.8 ha/hr.

1h
Time (hr) = G—ra x 20.0 ha= 0.3095. .. or 2.9 hr

8h
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Economics of Agricultural Machinery

10.1. Objectives

1. Beableto list the criteriafor selecting tractors and machines.

. Be able to determine optimum machine size.

3. Be able to calculate ownership and operating costs of agricultural equip-

ment.

4. Understand ways to reduce the costs of owning and operating tractors and
machinery.

. Understand the concept of break-even use (BEU) for a machine.

. Beableto calculate BEU for a machine.

. Understand the importance of regular maintenance of agricultural machinery.

N

~N O 01

10.2. Introduction

Machinery isone of the largest investments for agricultural enterprises. The selec-
tion process may include manufacturer, design, size, and options. A bad decision
on any one of these factors will have a serious effect on the profitability of the
enterprise. After studying this chapter, you should have a better understanding
of the criteria to use when selecting tractors and machines, and be able to match
tractor and machine sizes.

10.3. Selection Criteria

Some of the characteristics or capabilities of a tractor or machine that make it
more attractive than another are abstract, but they can have a tremendous bearing
on the quality of the machine and/or the quality of its performance. The following
sections will discuss some of the criteria that should be used when selecting a
tractor or machine and illustrate their importance.

129
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10.3.1. Company Name

The company name should be considered in machinery selection. Manufacturers
spend years and multitudes of resources establishing a reputation. A company’s
reputation is based on the quality and durability of its products, service to its
customers, or acombination of both. It isimportant to know if amanufacturer will
stand behind its product and warranties.

The importance of selecting tractors and machinery from reputable companies
cannot be overstated. In some situations, the best economic decision would be to
choose one tractor or machine over another, even though it did not have the better
durahility record, just because the reputation of the manufacturer was better.

Animportant factor to consider on brand nameisthe availability of parts. A low
cost tractor or machine that has an extended down time each time it needs a part
ishot agood investment.

10.3.2. Cost

Cost is always an important consideration when purchasing any item. It isim-
portant to remember that the least cost tractor or machine may not be the least
expensive when both ownership and operating expenses are considered. The least
cost machine may have the lowest ownership costs, but the operating costs may
offset this advantage. Note: these costs are explained in alater section.

Animportant aspect of thetotal cost of amachineisthe down time. Whenever a
machine is not available because of the need for repairs, the cost to the enterprise
is not just the cost of the repairs; it also includes lost capacity or lost time. When
the crop is ready for harvest and the combine is not available because it needs
repairs, thereis a cost associated with leaving the crop in the field after it is ready
for harvest, because some of the crop will be lost.

10.3.3. Repairs

All machineshavebreakdowns, but thequality of theconstructionwill dramatically
influence the repair costs for a tractor or machine. There is aso a correlation
between the complexity of atractor or machine and the cost of repairs. It would be
expected that a combine would have more repair costs that a cultivator. The cost
of repairsis also influenced by the use and abuse of the tractor or machine. Any
equipment that is not maintained or used in any manner not recommended by the
manufacturer will have greater repair costs. As discussed in the previous section,
downtime for repairs is also important because of the lost capacity. Evaluate the
equipment not only on its quality and durability but also on the amount of time
and money that will be required to have it repaired.

10.3.4. Design

The design of the machine is an important consideration. Because of the diver-
sity of agricultural machinery, several designs might produce an acceptable level
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of performance, yet small variations in design may make one more suitable than
the others for a given situation. For most tillage equipment, the cost of the ma-
chine is primarily determined by the quantity of the steel it contains. A tillage
machine designed for use in fields that are large and relatively flat will have wide
rigid sections. But a machine that is designed for terraced or undulating fields
will require a frame with more flexibility. More flexibility will require a more
complicated frame that will cost more money. It is sometimes difficult to know
what features of a design improve the value of amachine for aparticular situation
without an understanding of the advantages and disadvantages of the different
designs.

10.3.5. Capacity

The trend in agriculture has been to larger farms. This trend has increased the
demand for machineswith larger and larger capacity. A previouschapter discussed
that the options for increasing capacity are: using a wider width, operating at a
faster speed (both requiring more power) and increasing efficiency of operation.

It also is important to be able to complete the operation in a timely fashion.
Unfortunately, information on the timeliness of agricultural operationsis limited.
Some concepts of timeliness and the effect of machine size are discussed in the
next section.

10.4. The Optimum Machine Size

Optimizing the machine sizeis onetechniquefor reducing production costs. When
themachineistoo small, the operating costsmay be higher, and itsreduced capacity
will require agreater number of hoursto complete an operation. It isaso possible
to exceed the design forces when the machine sizeis small for the avail able power.
When the machine istoo large, power isthe limiting factor and the machine may
not produce the desired results, or thelife of the tractor may be shortened, because
modern tractors are designed to operate at lighter drafts and faster speeds.

The optimum machine size can be selected from two different points of view:
it can be based on the amount of time available to complete an operation, or it
can be based on the amount of power available from the tractor. The process used
depends on the situation.

When the limiting factor istime, the recommendation isto determine the avail-
able time (timeliness) for completing the operation and then determine the size of
machine required. Once the machine size is determined, the required tractor size
can be determined. A high priority on timeliness may result in a calculation that
would requirealarger tractor to power the machine. A full discussion of timeliness
is beyond the scope of thistext, but we will illustrate this concept for determining
the size of machine and tractors.

When the limiting factor is power, the recommended procedure is to determine
the maximum size of machine that can be powered by the tractor. When power is
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thelimiting factor, the cal culations may result in atime reguirement for completion
of the activity that is not realistic. The first example problem will match tractor
and machine size base on timeliness.

Problem: A general recommendation is that the primary tillage for planting corn
should not take longer than 1 week. If you anticipate planting 500 acres of corn
and only work 12.0 hr per day and 6 days per week, what size of moldboard plow
do you need if you can plow at typical speed and efficiency?

Solution: Thefirst stepisto determinethe capacity of the plow, Cg (ac/hr) required
to plow the ground in the available time. This can be accomplished by using units
cancellation:

<a_c> _ 500 ac " 1 day » 1wk
E\hr/ ™ 1wk ~ 120nr ~ 6day
To plow 500 acresin 1 week, the plow must have a width and be operated at a
speed that will produce a capacity of 6.9 ac/hr. The second step isto determinethe

width of the plow. Thisis accomplished by remembering that the capacity of field
equipment can be determined by using the effective capacity equation, Chapter 9.

—6.944. . 0r69 X
hr

V x w x Ef
8.25

Rearranging this equation to solve for width (w) and looking up the typical speed
and efficiency in Appendix IV resultsin the width of the plow:

Ce=

ac
_ Cex825 00 x82 5055

V < E 36 15.8125 or 16 ft

45™ 080
hr

To be able to plow the field in 1 week, assuming that the plow will be operated
at typical speed and efficiency, you will require a plow with an effective width of
16 ft. Plows are not usually sized by feet of width; instead they are sized by the
effective width of each plow bottom and the number of bottoms. Sixteen feet is
the same as a 12-16 plow (12 bottoms with 16 inches per bottom).

The next step isto determine the size of the tractor needed to pull the plow. This
isaccomplished by determining the drawbar horsepower required. Thefirst stepis
to replace the term force in the drawbar power equation with the term draft (Dg)
or draft force.

DF x V
375

The term draft is used to describe the amount of force required to pull a machine.
Appendix V givesthe American Society of Agricultural and Biological Engineers
(ASABE) standard values for the draft of agricultural machines. Notice that more
than onetype of unitisused for draft. That is, the draft of plowsislisted as pounds
of force per square inch (cross sectional area) plus a speed factor, spring tooth
harrows are listed as pounds per foot of width, and some rotary power machines

PpbHp =
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are given in horsepower. It is important to pay close attention to the units being
used so that the equation can be modified. The draft is calculated by the following
equation:

DF=Fi><[Cl+(C2xV)+(C3xV2)]xwad

where Dg = Draft in Ib or N; F = Sail texture factor. For fine soilsi = 1, for
mediums soilsi = 2, and for coarse textured soilsi = 3; Cq, C,, C3 = machine
specific parameters from Appendix V; W = machine width, ft or m; T4 = Tillage
depth, in or cm.

Problem: What size tractor (Dbhp) will be required to pull the 12-16 (16.0 ft)
plow that was calculated in the previous problem?

Solution: Thefirst step isto find the draft of the plow in Appendix V. Notice that
the draft for a plow varies with soil type. We will assume that the plow will be
used in aclay soil, which is afine textured soil.

From Appendix V, for customary units we find the following parameters:

F =10
C, =113
C,=0

C; =23

Thetillage depth, Tq = 6 in, and the plow width, w = 16 ft.
Selecting a depth of 6.00 inches and solving for draft:

Dr=Fi x [C1+(C2x V) + (Cs x VI] x w x Tqg

16in 1ft
— 2 i
= 1.0[113 + (0 x 4.5) + (2.3 x 4.5°)]12 bottoms x bottorn < 121 6.0in
~183,830.4
Y

= 15,319.2 or 15,000 Ib

Solve for drawbar power in hp
D|: x V

375
15,000 x 4.5

375
= 180.0 or 180 hp

PpoHp =

With typical speed and efficiency, and operating 6 inches deep in clay soil, the
12-16 plow will require a tractor with 180 drawbar horsepower.

One result of using this method to determine the optimum size of machinesis
now apparent. The cal culated tractor size may belarger than the size of tractor that
you have. What areyour alternativesif you do not want to purchasealarger tractor?
Plowing is usually the highest draft tillage operation on afarm so a tractor could
be leased for the time required to do the plowing. The plowing could be hired
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out. Another option, which might allow you to complete the plowing with the
tractor available, isto adjust one or more of the factorsin the drawbar horsepower
equation. A common practiceisto extend theamount of time avail able to complete
thetillage operation. It also is possible to reduce the draft of the plow by reducing
the operating depth or to reduce the speed. In some situations one of these two
choicesisthe best option, but for this problem the available time will be adjusted.

Problem: Assume that the largest tractor you have available to pull the plow in
the previous example is 100 drawbar horsepower. If thistractor isused, how many
12 hr days will it take to plow the 500 acres?

Solution: Thefirst step isto determine the size of plow the 100 Dbhp tractor can
pull. This is accomplished by rearranging the drawbar horsepower equation to
solve for width [because Area (A) = Width(w) x Depth (d)]:

Dbhp x 375 100.0 Dbhp x 375

Win = 5~ 45 = 1401b _6in_450m
in2 1 1hr
37,500 .

Under the conditions set up in this problem, a 100.0 Dbhp tractor is capable of
pulling aplow that is 99.2 incheswide. A 99.2-inch wide plow would be 6.2 or 6,
16 inch bottoms. Therefore, a 6-16 plow (8.00 ft) plow is used.

The next step is to determine the capacity of aplow 8.00 ft wide.

mi

h ac
Ce = = = — =3.4909...0r35 —
: 8.25 8.25 8.25 O3S b
Determining the number of days using units cancellation:
1ld 1h
days =~ o =" | 500ac = 11.9047...or 11.9 days

12hr  35ac

This means using the 100 Dbhp instead of the 193 Dbhp, will take 6 extra days
(12 days— 6 days = 6 days) to plow thefield.

Another situation that often arises in agriculture is determining the size of ma-
chine that a tractor can power.

Problem: Theopportunity to buy a185 PTO horsepower tractor istoo good to pass
up. What size (width) of offset disk harrow (Wgp) and field cultivator (Wsc) will
you need for your new tractor? The disc harrow is operated 6 inch deep. Assume
aclay soil and the lowest typical value for speed and efficiency. Note: remember
to convert from PTO power to drawbar power using the 86% rule.

Solution: To solve this problem PTO power must be changed to drawbar power.

Pobip = PTOwp x 0.86 = 185 hp x 0.86 = 159 hp
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Draft can be calculated by rearranging the drawbar power equation.
V x D|:

375
PDpr x 375
\
159 hp x 375
3.5 mph
= 17,035.71... or 17,000 Ib

The following parameters for the ASABE draft equation were obtained from
Appendix V:

Poohp =

Dr

F1 = 1.0 (finetextured, clay, soil)

Ci1 =062
C,=54
Cs3=0.
Rearrange the ASABE equation for draft and solve for the machine width (W).
W(ft) = De

Fix[C14+(Cax V)+(Cax V?)] x Ty

3 17,000

~ 10x (62+ (5.4 x 35) + (0 x 3.52)) x 6
17,000

T 4854

= 35.022... or 35t

The 185 PTO horsepower tractor will be able to pull an offset disk harrow up to
35 ft wide in a clay soil when operating at the low end of the typical speed and
efficiency ranges.

The draft of a secondary tillage field cultivator is calculated as pounds of force
per tool (shovel, sweep etc.) plus a speed factor. Therefore, the number of shanks
determines the size of the cultivator. For a cultivator, the drawbar horsepower
equation is converted to:

Dr
Fi x [C1+(C2 x V) + (C3 X VZ)] x Ty
Thefirst step in determining the size of cultivator than can be pulled by the 159 hp
tractor is determining the number of shanks for the cultivator. Assume the tillage

depth Ty is 3 inches. From Appendix V, the machine parameters for a secondary
tillage field cultivator are:

W (shanks) =

F1=10
Ci=19
C,=18

Cs=0.
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Solving the ASABE draft equation for w (in this case number of tools or shovels):

De
F x [C1+ (Co x V) + (Cg X VZ)] X Tg
17,000
1.0x (19+ (1.8 x 6) + (0 x 6?)) x 3
17,000

89.4
= 190.156 or 191 tools or shanks

W =

The 185 PTO horsepower tractor will be able to pull a field cultivator with
191 shanks. The width of the cultivator depends on the number of rows of shanks
and the spacing between each shank. For exampl e, one possible arrangement would
be a cultivator with three rows of staggered shanks, the second and third row stag-
gered equal distance between the front row shanks, spaced 21 inches apart. This
arrangement would have 191 shanks (64, 63, and 64), and be 112 ft wide (64 shanks
or tools multiplied by 21 inches and divided by 12 in/ft). Note: the tape measure
width from shank to shank would be (63 x 21 inches) divided by 12 in/ft or
110.25 ft. The effective width includes one half of the spacing on each end of the
row. 110.25 + 10.5 + 10.5 = 112 ft.

Appendix V presents the draft of equipment in the form found in the ASABE
Standards. Other sources may provide draft figures for machines in pounds per
foot. If these values are used, the drawbar horsepower equation does not need to
be modified each time, but the calculations will not be as accurate as this example
problem.

10.5. Costs of Machinery

This section discusses those elements that contribute to the cost of owning and
operating agricultural machinery. An understanding of the types of costs and their
impact on the profitability of the enterprise improves our ability to make mean-
ingful decisions regarding the management of agricultural equipment.

It is best to base decisions on the actual costs of the machine. Good managers
will record the annual costs for machines, but unfortunately the total costs are not
known until amachine has reached the end of its serviceablelife, that is, until the
machine wears out or is sold or traded in. Therefore, cost determinations must be
based on estimations. To make these estimationsrealistic and reliable, they must be
based on past machine performance and cost records. The following sections will
discuss the typical costs of owning and operating machinery as well as methods
that can be used to estimate the costs of agricultural equipment.

Generally, machinery costsare classified into two groups, ownership costs (fixed
costs) and operating costs (variable costs). Fixed and variable costs are:
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Fixed costs Variable costs

1. Depreciation 6. Repair and maintenance
2. Interest on investment 7. Fuel

3. Taxes 8. Qil

4. Shelter 9. Labor

5. Insurance 10. Consumables

10.5.1. Fixed Costs

Fixed costs are independent of machine use, and occur whether or not the machine
isused. They arereferred to asthe cost of ownership. Each fixed cost is estimated
on acalendar year or an annual basis. The common fixed costs are:

1. Depreciation: Depreciation is the loss in value of a machine with the passage
of time, whether or not it is used. Depreciation can be regarded as the amount
of money that should be saved each year as a machine is used so that, at the
end of its useful life, this money along with the remaining value of the machine
(salvage value) could be used to replace it. Several choices exist in the way by
which depreciation can be figured for cost and/or tax purposes. All depreciation
methods require an estimation of the machine servicelife. The simplest method is
straight line depreciation:

$ P-8V

yrooooyr
where $/yr = Annual depreciation; P = Purchase price; SV = Salvagevalue; yr =
Years of service.

Problem: Determine the annual depreciation for a machine with a purchase price
of $15,400, a salvage value of $800.00 and an expected life of 8 years.

Solution:
$ P-SV
yroooyr
. 15,400.00 — 800.00
- 8
= 1,825.00 i
yr

The annual straight line depreciation is $1,825.00 per year.

2. Interest on investment: An interest cost should be used because the money
tied up in purchasing a machine could have been used for another purpose or
invested. When money is owed on a machine the annual interest charges added
to the depreciation can be used to estimate yearly costs of ownership. A method
that includes the yearly costs of ownership and the time value of money is called
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capital recovery factor, CRF. CFR can be calculated by:

R={(P-5)x M +3i
M N Teem Ay | A

where R = one of aseries of equal payments due at the end of each compounding
period, g times per year; P = principal amount; i = interest rate as compounded
g times per year; n = life of theinvestment in years; S = salvage value, $.

Problem: Determine the capita recovery factor for a machine that cost
$125,000.00 at purchase, has a salvage value of $3,000.00. A 10-year loan is
used with an interest rate of 10.5% per year.

Solution:

R={(P—5)x <‘;_)X(l+<i1_>nq 3

0.105> < 0.105>1°X1

= {($125,000.00 — $3,000.00) x (

1
0.105) 101
14+ = -1
$3,000.00 x 0.105
+
1
0.105 x 2.714. ..
= l$122 ittt 15.
{$ ,000 x ( o T >}+$3 5.00
— {$122,000 x 0.166. ..} + $315.00
$

= 20598.3912 or 20,600.00 )Tr

The CRF for this machine is $20,600.00 per year.

3. Taxes: Any property and sales taxes paid on the equipment must be included as
afixed cost. An estimate of the annual taxes for agricultural machinery is 1% of
remaining value.

Problem: What isthe annual tax during the 2 year of ownership for a $55,000.00
machine when the expected lifeis 12 years? The salvage value is $500.00.

Solution: Thefirst step is to determine the value of the machine at the beginning
of the second year. The value at the beginning of the second year is determined by
the amount of depreciation that occurred during the first year. Assuming straight
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line method:
$ _ $55000.00 - $500.00 _ 4541.666. .. or 4,540.00 $
yr 12 yr

The value of the machine at the beginning of the second year is:
$ = $55,000.00 — $4,540.00 = $50,460.00

The annual taxes are:

§ = $50,460.00 x 001 = 504.60 E

yr yr yr
4. Shelter: A cost of shelter should beassigned to machinery. If ashelter isused, the
cost can be determined and assigned over the life of the machine. If the machineis
not sheltered, acost still should still be assigned for shelter becausetheresalevalue
of themachinewill belessthan that of asheltered machine. An estimatefor thean-
nual cost of shelter is0.75% of the value of themachineat the beginning of theyear.

Problem: What isthe annual cost of shelter during the fourth year for a $4,500.00
machine when the expected life is 5 years and the salvage value is $1,500.00?

Solution: Thefirst step is to determine the value of the machine at the beginning
of the fourth year. Assuming straight line depreciation the annual depreciation is:

E _ $4,500.00 — $1,500.00 — 600.00 E
yr 5 yr

The value of the machine at the beginning of the fourth year is:
600.00 $ )
x 3yr

$ = $4,500.00 — (

= $4,500.00 — $1,800.00 = $2,700.00

The cost of the shelter during the fourth year is:

.007
; = $2,700.00 x 0.0075 =20.25 hd

yr
A shelter cost of $20.25 should be used during the fourth year for this machine.
5. Insurance: Any liability or replacement insurance carried on the machine should
beincluded. An estimatefor theannual cost of insuranceis0.25% of theremaining
value at the beginning of the year.

Problem: Determine the lifetime insurance cost for a $125,500.00 machine when
the expected lifeis 15 years and the salvage value is $10,000.00.

Solution: The annua insurance cost for a machine is determined by multiplying
the insurance factor time the value of the machine at the beginning of the year.
The lifetime insurance cost for a machine is determined by summing the annual
insurance costs. Because of depreciation the value of the machine declines each
year and therefore the annual insurance cost declines each year. This problem
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TABLE 10.1. Spreadsheet for determining lifetime insurance costs.

Purchase price $125,500.00
Insurance factor 0.0025
Annual depreciation $7,700.00
Year Value Insurance cost

1 $125,500.00 $313.75
2 $117,800.00 $294.50
3 $110,100.00 $275.25
4 $102,400.00 $256.00
5 $94,700.00 $236.75
6 $87,000.00 $217.50
7 $79,300.00 $198.25
8 $71,600.00 $179.00
9 $63,900.00 $159.75
10 $56,200.00 $140.50
11 $48,500.00 $121.25
12 $40,800.00 $102.00
13 $33,100.00 $82.75
14 $25,400.00 $63.50
15 $17,700.00 $44.25

Sum $2,685.00

Thetotal cost of insurance over the lifetime of the machine is $2,685.00.

can be solved by using a complex equation or using the same method as the
previous examples, but it is also an example of aproblem that can be solved using
a spreadsheet, Table 10.1. Assuming straight line depreciation, the life time cost
of insuranceis $2, 685.00.

Theannual cost of owning apieceof equipment, then, isthe sum of thefixed costs
listed above. Notice that at this point no mention has been made of machine use.

With accurate records, the annua cost of a machine can be determined by
figuringthecostindollarsper year for each of thefivefixed costs. Another approach
is to combine the five items into an annual fixed cost percentage (FC%). Cost
analysis of dataindicates that the FC% times the purchase price of the machineis
an acceptable estimate for the annual ownership costs of amachine.

Annual owinership cost (AOC) = FC% x P

An ownership cost percentage can be estimated by:

o= 100 x <<1—st>+ (1—28\/ X |> + K2>

where C, = ownership cost percentage; S, = salvage value factor (percent of
salvage value compared to the purchase price) of machine at end of machine life
(year L), decimal; L = machinelife, yr; | = annual interest rate; K, = ownership
cost for taxes, housing, and insurance, decimal.
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Problem: What isthe ownership cost percentage for amachine that as an expected
life of 10 years, cost $23,000, a cost for taxes, housing and insurance of 2% and
has a salvage value of $3,400.00?

Solution: The ownership cost percentage is determined using the previous equa-
tion. Thisequation requiresthe salvagefactor asapercent. To determinethe percent
divide the purchase price by the salvage value and multiply times 100. The salvage
factor is:

,400.00
Salavage factor % = gTom x 100 =14.78... or 15%

The fixed cost percent is:

1- 1
o100 ((1%) 4 (M%) )

1-01 1+01
=100x<< 18 5>+< +20 5x0.10>+0.02>

= 100 x (0.085 + 0.0575 + 0.02)
— 100 x 0.1625 = 16.25 or 16%

Problem: What isthe annual ownership cost for a$150,000.00 combine when the
fixed cost percentage is 18%°?

Solution:

AOC (%) = FC% x P = 0.18 x $150,000.00 = 27,000.00 ;

10.5.2. Variable Costs

Variable costs are associated with the operation of amachine and occur only when
themachineisused. Theterm operating costsfrequently isused to describevariable
costs. Variable costs are usually figured on an hourly basis, but they can befigured
using acres, bales or any other appropriate unit. The common variable costs are:

1. Repairs and maintenance (RM%): The costs of repair and maintenance are
related to the type of machine, the purchase price and the hours of use. The repair
and maintenance costs can be estimated using the following equation.

RF2
Crm =RF1x P x (m))

where Cr, = accumulated repair and maintenance cost ($); RF1 & RF2 = repair
and maintenance factors (Appendix 1V); P = machine price in current dollars,
multiply original priceby (1 +i)" wherei isthe averageinflation rate and n isthe
age of the machine to adjust for inflation; h = accumulated use of machine (h).
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Problem: Estimate the accumulated repair and maintenance costs for a self-
propelled combine that was purchased 4 years ago for a price of $90,000.00.
The machine has 1,200 hr of use and the average inflation has been 6.5%.

Solution: Thefirst step isto adjust the price of the machine for inflation.
$ = $90,000.00 x (1 +i)"
= $90,000.00 x (1 + 0.065)*

= $90,000.00 x 1.286...
= 115781.9... or $120, 000

Next the repair and maintenance costs can be estimated:

h RF2
Crm =RF1x P x <1,0—00>

1,200\ %!

= 0.04 x $120,000. '

0.04x $ 000000X<1,000>
— $4,800.00 x 1.466. ..

= 7039.1... or $7,000.00

2. Fuel (F): The fuel consumption for an engine is influenced by the size of the
engine and the percent of load. Average annual consumption can be estimated
using the procedures printed in ASABE Standard D497.4 FEBO3.

Quavg = 0.0305 x Pyo

where Qag = average gasoline consumption, L/hr; Py = maximum PTO
power, kW
or

where Qay = average gasoline consumption, ga/hr; Pyo = maximum PTO
power, hp.

These equations must be multiplied by 0.73 for diesel and by 1.20 for liquefied
petroleum gas (LPG) tractors.

Problems: Estimate the annual fuel consumption for a125 PTO Hp diesdl tractor
that will be used for 850 hr per year.

Solution: Thefirst step isto use the equation to determine the hourly use.

% =0.06 x 125 x 0.73=5.4750r 5.5 %

The second step is the multiply the hourly use by the hours per year:

al h al
9@ _ 559 a0 _ 46750r4700 P
yr hr yr yr
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Estimating the fuel consumption for a specific operation requires determining the
total tractor power for that operation. ASABE standard D497.4 provides a method
for estimating fuel consumption for a specific operation.

3. Oil (O): Theoil costindollarsper hour will bethe product of the oil consumption
(gal/hr or L/hr) during operation and oil changes, and theoil price ($/qt or $/L). The
total oil used (gal/hr) on aper hour basis can be estimated assuming manufacturer’s
recommended change interval by:

Gasoline  (0.00011 x P) + 0.00657
Diesdd  (0.00021 x P) + 0.00573
LPG (0.00008 x P) + 0.00755

where P = rated power, hp.

Thetota oil used (L/hr) on a per hour bases can be estimated by:

Gasoline  (0.000566 x P) -+ 0.02487
Diess  (0.00059 x P) + 0.02169
LPG (0.00041 x P) + 0.02

where P = rated power, hp.

Problem: Determinethe amount of oil that will be used by a 120 PTO horsepower
diesel tractor.
Solution:

a al
gh—r — (0.00021 x 120) + 0.00573 = 0.03093 or 0.031 gh—r
4. Labor (L): The hourly wage for labor to operate the equipment in dollars per
hour.
5. Consumables (C): Some machines, such as balers, have twine, netting or other

materials that are consumed as a part of the machine operation.

Thus, the total hourly operating cost (THOC), in dollars per hour, of a machine
isthesum of items 1, 2, 3, 4 and 5 above.

Problem: Determine the total costs for a $35,000.00 grain drill that is used 120 hr
per year. It has an expected life of 10 years and a salvage value of $1,000.00. Itis
pulled by a 98 horsepower diesel tractor. Assume an interest rate of 8%.

Solution: Thetotal annual cost isthe sum of the annual fixed costs and the annual
variable costs. The fixed costs can be determined by calculating each individual
cost, or by using the ownership cost equation to determine the ownership cost
percentage. For this example the ownership cost equation will be used.

Fixed costs: the ownership cost equation requires salvage value expressed as a
percentage.
Salvage value factor:
$1,000

Salvage factor % = $35.000 x 100 = 2.857... or 2.8%
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Total fixed cost percent:

1-5S 1+S
C0=100x(( LV>+< +2V><|>+K2>

1-0.028 1+ 0.028
= 100 x (( ) + ( * > x 0.08) +0.02>

10
= 100 x (0.0972 + 0.04112 + 0.02)

= 100 x 0.15832 = 15.832 or 16%

Total fixed costs:

.l
hd = $35,000.00 x 0.16 = 5,600.00 $
yr yr yr

Variablecosts: Annual variable costs=repair and maintenance+ Fuel +Oil 4L abor
Repair and maintenance:

h RF2
Crm =RFl1x P x (m)
120 21
1000
= 0.32 x $35,000.00 x 0.0116...

= 0.32 x $35,000.00 x (

= 130.466. .. or 130.00 ;

Fuel: Thefuel cost for thegrain drill isdetermined by the power and fuel efficiency
of the tractor. Estimating tractor fuel costsfor specific operation isnot included in
thistext. See ASABE D496 for thisinformation. Average fuel consumption based
on the fuel type and power of the tractor can be estimated using the information
from ASABE EP496.2 FEBO3.

The fuel use (gal/hr) is:

Qag = 0.06 x Py, x 0.73

=0.06 x 98 x 0.73
=429240r 4.3 @
hr

The fuel cost is: (assuming fuel is2.25 $/gal)
$ 43ga 225% 120hr
— = X X
yr hr gd yr

= 1161 or 1, 200.00 E
yr

Oil costs:

ga

= (0.00021 x P) + 0.00573
= (0.00021 x 98) + 0.00573

= 0.02631 ﬁ
hr
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Assuming an oil cost of 2.00 $/qt:
E _ 200% o ﬂ y 0.02631 gd y 120 hr
yr  qt gal hr yr

= 25.25... or 25.00 E
yr

Labor: Labor costs are determined by multiplying the annual use by the tractor
operator cost in $/hr.

E _ 120 hr " $10.00 — 1.200.00 E
yr yr hr yr

Thetotal cost of owning and using the grain drill 120 hr per year is:
Total annual cost = Annud fixed costs + Annual variable costs
= 5,600.00 E + (130.00 E + 1,200.00 E + 25.00 E +1,200.00 E)
yr yr yr yr yr

= 5,600.00 § + 2,555.00 E
yr yr

= 8,155 or 8, 200 §
yr

Machinery costsin dollars per year are useful for the owner/operator of amachine,
but for custom work the operator needs to know the costs in terms of dollars/acre,
dollarsg/hour, dollars/bale etc. The cost of a machine on a unit volume basis is
influenced by the annual use because as the annual use increases, the fixed costs
are spread out over more units. Thismakesthefixed costsper unitless. Toillustrate
this point Figure 10.1 shows the costs per acre for the grain drill in the previous
problem for an annual use ranging from 100 to 1200 hr per year.

Notethat the dollarsper hour costs decrease until about 700 hr and then they start
back up. Thisis because the equation used by ASABE to estimate repair and main-
tenance costs is designed to increase repair costs as the machine uses increases.

FIGURE 10.1. Total costs per hour of use.



146 10. Economics of Agricultural Machinery

10.6. Ways to Reduce Costs

A featureof agricultureisthat the buyer usually fixesthe pricethe producer receives
for their products; therefore the best way to increase profitsisto reduce production
costs. No single factor will keep ownership and operating costs of tractors and
machinery to a minimum, but good management of the following factors will
reduce the production costs of machinery.

10.6.1. Width Utilization

The effective width is aways less than the width of the machine, except for row
crops, because most operators overlap each round slightly to prevent skips. Any
excessive overlap reduces the effective capacity of the machine and increases the
cost per acre.

10.6.2. Time Utilization

Any time that a machine is not performing its designed task, when it could be,
means lost productivity. Several practices can be used to reduce lost time. First,
adjusting and lubricating of the machine should be kept to a minimum consistent
with the need for service. Even better, you should do as much of the maintenance
as possible when conditions prevent the machine from being in the field.

Second, breakdowns can be minimized by avoiding overloads and by acomplete
preventive maintenance program. Any machineis morelikely to break down or to
need additional maintenance if it is overloaded or misused.

Third, aproper field layout will keep turning at the end of the row or round to a
minimum. There is an optimum pattern for every field shape and size of machine.
Machinery management texts provide more information on this topic.

Another ideaisto reducethetimerequired to refill seed, fertilizer, and chemicals
by using thelargest practical size of hopper or tank. In addition, the equipment used
toload thetank or the hopper should havethe capacity tofill itin areasonabletime.

10.6.3. Matching Tractors and Machines

Tractorsfurnish power most economically when operated at or near the rated | oad.
If the load is too small, it may be increased by widening the machine or by using
two machines in tandem. Increasing the speed also increases the effective tractor
load. If al of thetractor power isnot being utilized and it isnot feasibleto increase
the speed, fuel costs can be reduced by shifting up into a higher gear and reducing
the throttle. (Check the owner’s manual before attempting this.)

10.6.4. Reducing Original Investment

The initial cost of a machine is a major factor in determining the fixed cost of
owning and operating farm machinery. The initial cost can be reduced by buying
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used equipment or by building equipment and machinery in the farm shop. Both
of these strategies substitute human labor for some of the initial cost.

10.6.5. Increasing Annual Use

Aswe discovered in the section on calculating costs, the more a machine is used,
the less the cost per unit will be. Usage can be increased by joint ownership, by
increasing the size of the enterprise, by doing custom work, or by increasing the
working season by diversifying production.

10.6.6. Increasing Service Life

Ensuring that the machine lasts aslong as possible is oneway of reducing the need
fortheinitial cost of anew machine. The servicelifecan beextended through proper
maintenance, careful adjustments, avoidance of overloads, and using skilled oper-
ators. Theuseful lifea soisextended through proper storage during the off-season.

10.7. Break-Even Use

Inthe previous section, weintroduced the notion that the total cost per acre or hour
decreases asannual useincreases. Thisisthe basis of BEU. For some operationsit
may be more profitable to consider hiring contract workers instead of owning and
operating one's own machine. The decision to hire may hinge on the break-even
usage, that is, the amount of use for which the costs of owning a machine are the
same as the costs of hiring a custom operator.

Supposefor agiven machinethat the product of FC% and P equals$1,000. Also,
suppose that the operating costs are $ 4.00 per acre. The TAC equation would be:

TAC = $1,000.00 + ($4.00 x A)

where A = acres of use. Next calculate the values of TAC for acre (A) values of
10, 50, 100, 200, and 500 acres. The result is Table 10.2.

Then if we wish to determine the cost of using the machine on a per-acre
basis, we divide the TAC by the acres for each situation, and get the values shown
in Table 10.3.

A comparison of the various levels of use shows that the cost per acre decreases
as use increases. The break-even analysis in Figure 10.2 shows that for a custom

TABLE 10.2. Break-even use.

Acres Total annual cost
10 $1040
50 1200
100 1400
200 1800

500 3000
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TABLE 10.3. Cost per acre.

Acres TAC Cost per acre
10 $1040 $104.00
50 1200 24.00
100 1400 14.00
200 1800 9.00
500 3000 6.00

rate of $21.00 per acre the cost for an annual use of about 60 acres per year it is
more economical to hire work. At annual use of over 60 acres per year it is more
economical to own the machine and do the work yourself.

This same method can be used to determine the beak-even point for costs with
units different than dollars per acre. For the process to result in good information
the custom rate and the total costs must be in the same units.

The BEU can be determined by the following equation:

AOC

BEU = ————
CR - OPC

where BEU = Break-even use (unit of use); AOC = Annual ownership costs ($/yr);
CR = Custom rate ($/unit of use); OPC = Operating costs ($/unit of use).
Although thisanalysisindicates ahard-and-fast decision for aparticular amount
of use, the ownership—custom hiring decision should betempered by other factors.
Table 10.4 lists some advantages and disadvantages of custom hiring of farm
equipment. It is most important to use consistent units with each of the terms. If

$110.00

$100.00 \
$90.00 \
$80.00 \
$70.00
$60.00 \
$50.00 \ [——Cost per acre |
—— Custom rate
$40.00 \
$30.00 \

$20.00 ~

Cost per acre ($)

Break Even Point

N—

$10.00

$0.00

0 25 50 75 100 125 150 175 200 225 250 275 300 325 350 375 400 425 450 475 500
Annual use (acres)

FIGURE 10.2. Break-even analysis for $22.00 per acre custom rate.
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TABLE 10.4. Advantages and disadvantages of custom hiring farm equipment.

Advantages Disadvantages

1. No ownership costs. 1. May not be possible to schedule when needed.
2. Cost of equipment can beinvested in other 2. Less control of quality of work.
enterprises.

3. Hired equipment usually supplies labor. 3. Increased potential for losses because of delays.

4. Less equipment is needed by owner, 4. Increased risk of spreading weed seeds and
particularly specialized. diseases.

5. Owner can take advantage of newest 5. Costs for large jobs may be higher than owning
machinery and techniques. machines.

6. Producer with small jobs can gain benefits 6. Small jobs have agreater chance of being
of large machines. postponed.

7. Custom operator isresponsible for repairs, 7. Producer may not be able to utilize own labor
maintenance, and materials. freed up by custom hiring.

the custom rateisin dollars per acre, the operating cost must bein dollars per acre.
In this case the units of the answer will bein acres per year.

Problem: What isthe BEU in acresfor a$20,000 machineif the FC% is 22%, the
operating costs are estimated to be $9.00 per hour, and the custom rate is $9.60
per acre?

Solution:
AOC 20,000 x 0.22
BEU () = cr—omc = : $ : $
B 9.60 — — 9.00 —
ac hr

The calculation is not completed because the units are not correct. The custom
rate and the operating costs must have the same units to be subtracted. When the
desired break-even point is in acres, both the custom rate and the operating costs
must havethe unitsof dollars per acre. Thedollarsper hour unitsmust be converted
to dollars per acre.

$ $ hr

X_
a hr a

Hours per acre is more commonly expressed as acres per hour, the capacity of a
machine. Assume the effective capacity of the machine is 2.50 acres per hour.

BEU () — AOC ~ $20,000 x 0.22
_CR_OPC_960§—900§
T ac T hr

_ $20,000 x 0.22 =733.33... or 730 ac

9.6o§—(9.00§x Lhr >
ac

hr 250 ac
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10.8. Maintenance Schedules

Maintenance is the care given to a machine to ensure that it operates correctly
and that it receives the required lubrication and adjustments. All machinesrequire
maintenance. Failure to provide adegquate maintenance can shorten the life of the
machine and/or increase its operating costs. Manufacturers specify the amount of
resources that amachine will need to maintain its operation. The owner/operator’'s
responsibility isto ensurethat the mai ntenanceisaccomplished on schedul e, based
onthemanufacturer’ srecommendationsinthe owner’smanual . Thisschedulemust
be followed for the machine to reach its designed potential in performance and
longevity.

10.9. Metric Problems

The processused for estimating costsisthe samefor both the S| and US Customary
systems. When estimating the costsfor the metric system substitute the appropriate
costs. Appendix V provides the parameters needed to calculate draft using the
ASABE equation. An example follows for the Sl system.

Problem: A chisel plow equipped with 5 cm wide shovels is used for primary
tillage in a wheat field. Depth of tillage is 15 cm. The chisel plow width is 13.7
m. The chisel shank spacing is 0.3 m. Plowing speed is 10 km/hr. The soil isa
silt loam (medium texture). What is the drawbar power required to pull the chisel
plow?

From Appendix V
F, =07
Cil=091
C2=54
C3=0.

Compute the number of tools (shanks)

Wmeh  137m

= = 45.666 or 45 tools
Wtool spacing 0.3m

WTool =

Cadlculate the draft in Newtons.

Dr = F x [C1+(C2><V)+(C3XV2)] X w x Ty
= 0.7 x [91+ (5.4 x 10) + (0 x 10%)] x 45 x 15
= 68512.5 or 680,00 N



Metric Problems

Calculate the drawbar power. Recall that draft isaforce.
FxV
60,000

680,00 N x 10 kTm

60,000
= 113.3330r 113 kW

The cultivator will require atractor with at least 113 kW.

Pookw =
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11
Sound and Noise

11.1. Objectives

1. Understand the nature of sound and the basis of sound measurement, the decibel
(dB).

2. Be able to compare different environmental sounds.

. Understand how humans are affected by noise.

4. Become familiar with noise exposure standards and protection from excessive
noise.

w

11.2. Introduction

Humans live in a world of sound. Many sounds are quite pleasant and persons who
are not hearing impaired enjoy hearing voices, music, and many sounds of nature.
People often listen for sounds that could warn of danger or the malfunctioning of
equipment. Individuals have differing abilities to detect sound of varying intensities
and frequencies, and differ as well in their personal tolerance of and appreciation
of sound.

Sound that is harsh and unpleasant (or unhealthy) commonly is referred to as
noise. In recent years, the subject of noise has been given considerable attention,
especially as it affects human health and behavior. The federal government, through
OSHA (Occupational Safety and Health Administration), has established noise
exposure limits to prevent worker hearing loss and/or psychological stress due to
excessive exposure to noise. OSHA does not have enough inspectors to insure all
work environments meet standards. It is up to individuals to understand the nature
of sound and noise so they know when unhealthy environments may exist due to
undesirable or unwanted sound.

11.3. What Sound Is

The sound that people hear is due to vibrations in air or substances that are transmit-
ted to the hearing organs. What are perceived as sounds are sonic pressure waves
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that travel through the air (or different substances) and interact with the eardrum by
entering the ear canal or by passing through the body. Thus the eardrum responds
to “sound pressure.” There is a very, very large change in sound pressure (perhaps
as much as 10,000,000 times) as sounds vary from the “threshold of hearing” (the
intensity of sound just barely detected by an average human ear) to the sound
pressure created by a large jet engine operating nearby. People can “feel” sound
when they touch a vibrating body and the vibrations pass through the body to the
eardrum.

The sense of hearing also responds to sound frequency (or pitch), that is, the
number of vibrations or cycles per second—Hertz (Hz).The range of sound fre-
quencies that can be heard varies from about 20 to 20,000 Hz, depending on the
individual. As the intensity of sound is increased to an appropriately high level for
a given frequency, the hearing sensation becomes painful, and the “threshold of
pain” is reached.

Human hearing also can distinguish between sounds that differ in quality, those
combinations of frequencies and intensities that produce squealing, grating, grind-
ing, or rasping sounds. When the frequencies and intensities are combined in suit-
able proportions, pleasant musical or vocal sounds result. Thus, the sounds that
are heard can be quite complex, but their effects on humans are well established.

In this chapter, our concern is with that part of sound called noise and how it
may affect workers and their work. Generally, excessive noise can lead to hearing
impairment, fatigue, annoyance, and interference with performance. Noise also can
serve as a warning of equipment malfunction or a signal of needed maintenance.
We frequently rely on sounds (or no sound) to tell us that equipment is performing
satisfactorily.

11.4. How Sound Is Measured

The intensity of sound is measured in units of decibels (dB). The unit decibel is a
ratio of any two components of sound, power, sound pressure, intensity, etc. The
human ear has the capability of distinguishing a wide range of sound intensity
and frequencies. The range of sound pressure that an individual might be able to
distinguish from the threshold of hearing to causing damage to the ears is over a
million. Because the decibel scale is a ratio, to measure a single source of sound a
base line called a filter is used. Three standard filters are used. They are identified
as A, B, and C. Filter Ais less sensitive to very high and very low frequencies. The
C filter is commonly used for high frequencies. The B filter falls in between the
A and C. It is seldom used. When using a sound meter it is important to identify
which filter is used. This is commonly done by using the units of dBA or dBC
after the reading.

To simplify the measurement of sound, decibel readings are based on an expo-
nential scale of sound pressure levels. Remember that the decibel is not an absolute
measure of the sound pressure, but rather is a ratio of a measured sound pressure to
a reference sound pressure. Also, because this sound scale is exponential, a sound
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of 10 dB has an intensity 10 times greater than a sound of 0 dB, and a sound of
20 dB is 100 times more intense than 0 dB. Thus, a 10 dB difference in sound
pressure level changes the intensity by 10 times, a 20 dB difference changes the
intensity by 100 times, a 30 dB difference changes the intensity by 1,000 times,
and so on.

The basic instrument used to measure continuous sound is the sound-level meter.
It consists of amicrophone to pick up the sound, an amplifier, one or more frequency
weighting networks, and a meter to display the sound level. Sound-level meters
usually are self-contained (they operate on internal batteries) and are small enough
to be hand-held although tripod mounting generally is preferred.

Proper sound-level meter use involves careful placement of the microphone to
avoid sound reflections that influence the readings. In measuring the noise exposure
of an individual (his or her work environment), the microphone is placed as close as
possible to the subject’s ear (or where the ear would be in the work environment).
Prior to use, the instrument must be calibrated against a known stable sound source.

11.5. Comparing Different Sounds

Table 11.1 shows some common sounds and the approximate sound pressure level
associated with them.

TABLE 11.1. Decibel rating of common sounds.

Sound pressure level (dB) Sound description
188 Apollo lift-off, close
150 Jet engine, 10 ft away
140  Pain threshold
130 Warning siren
125 Chain saw
120  Discomfort threshold Loud thunder
115 Max under federal law
110 Very loud music
105 Loud motorcycle or lawn mower
100 Very loud Pneumatic air-hammer
90 Cockpit of light plane, heavy truck
85 Average street traffic
80 Lathe, milling machine, loud singing
75 Vacuum cleaner, dishwasher
70 Average radio, noisy restaurant
65 Annoying
60 Normal conversation, air conditioner
50 Light traffic, average office
40 Library, quiet office
30 Quiet room in home, audible whisper
20 Electric clock, faint whisper
10 Barely detectable Rustle of leaves

0 Hearing threshold
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This chart may help you identify and classify sounds that you normally en-
counter; and if they are disturbing or otherwise unhealthy, you can avoid them or
properly protect yourself from any of their adverse effects. Note that the values
shown in the table are average values. Also, notice that (almost) identical sounds
may come from different machines and situations. Further, individuals may differ
in their tolerance of and classification of different sounds and noises. In specific
situations and when determining if noise levels are acceptable under current stan-
dards, the equations in section 11.7 must be used.

11.6. The Effect of Noise

As suggested previously, noise can have both psychological and physiological
effects on people. Psychologically adverse noise mainly affects a worker’s per-
formance and state of well-being. Direct exposure to excessive noise may cause
fatigue, distraction, annoyance, interference with communication, reduction in the
memory function, and disturbance of rest and relaxation. Some or all of these
effects may be involved in decreased performance in the workplace.

The main physiological effect of adverse noise is noise-induced hearing loss,
which is irreversible damage to one or more parts of the hearing organs. However,
high sound levels also can induce responses in other parts of the body, such as
reduced blood circulation, change on the skin’s resistance to electric current and a
corresponding activation of the nervous system, increased muscle tension, changes
in the breathing pattern, and disturbance of sleep. These non-hearing-related noise
responses are considered reversible and soon disappear when the noise source is
removed.

Not all adverse noise is encountered in the workplace. We are surrounded by
such sound generators such as outdoor and indoor equipment and appliances (lawn
mowers, chain saws, sink disposals, blenders, clothes washers, and the like) and
recreation and hobby equipment (gas-powered model planes and cars, unmuffled
racing car and boat engines, firearms and explosive devices, high power stereo
amplifiers and speaker systems, trail motorcycles, snowmobiles, and pleasure air-
craft, among other things). Many of these items generate unusually intense sounds,
but when we are preoccupied with the utility and the joy of using them, we are
seldom aware of the noise they create or their potential for damaging our hearing.

11.7. Determining Noise Exposure

We must become more aware or our “sound” environment, determine acceptable
exposure limits, and take any steps necessary to avoid overexposure and poten-
tially adverse psychological and physiological effects. OSHA standards require
businesses compute the employee noise exposure. Noise exposure can be mea-
sured with an audiodosimeter or with a decibel meter. The following section will
explain the recommended method using a decibel meter. This is accomplished
using two rules.
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1. When the sound level, L,! is constant over the entire work shift, the noise dose,
D, in percent, is given by:

C
D=100 x =
T

where D = Dose level (%); C = the total length of the work day (hr); T = the
reference duration level corresponding to the measured sound level (L). (L can
be determined by table or by equation).
2. When the work shift noise exposure is composed of two or more periods of
noise at different levels, the total noise dose over the workday is given by:
C: G, Ch
D=100x —= + 22 4...4
LT,
where C(n) = the total time of exposure at a specific noise level, and T (n) =
the reference duration for that level as given by Table 11.2 or equation.

The first equation determines the dose (%) for the employee. A dose of 100% is
the maximum allowed.
The reference duration level (T) is computed using the following equation:

8

2(-7%%)
where T = reference duration; L = dBA exposure.

Problem: Determine the sound dose for an individual who was subject to a sound
of 55 dBA for 1.25 hr and a level of 105 dBA for 5.0 min.

Solution: The dose equation requires a different reference duration (T) for each
sound level and duration. The first step is to determine the value of T for each
sound level and duration.

8 8 8 8
= ST = 369 = 27 = 0.007a1a5 = 1024 07 1,000

T
and
8 8 8 8
T2k T 0% %) T 8 T 8

the next step is to determine the value for each exposure using the dose equation:

=1

T,

1hr
60 min

Ci G
1,000 + 1

D=100 x { =—+ — ) =100 x
T T

=100 x (0.00125 + 0.0833...) =8.458... or 8.4%

The worker dose was 8%, well within the range of the maximum allowed of 100%.

1 OSHA 1910.95 App A, Noise exposure computation.
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11.8. Exposure Guidelines

The Occupational Safety and Health Act makes provisions for employers to make
accurate sound measurements in their places of business, to determine whether
the workplace is safe for workers; the sound level should not exceed 90 dB during
an 8 hr work period. For sound levels above 90 dB(A), reductions in exposure
time are required, with a limit of 15 min of exposure per day to a sound level of
115 dB. A further aspect of the Act is that no impulsive or impact noise should
exceed 140 dB. Also, noise abatement in excessively noisy work areas is required.
If a workplace is deemed excessively noisy, workers must be provided with safety
equipment and be required to use it.

Besides the OSHA regulations and the regulations set forth under the Federal
Noise Control Act (administered by EPA), several other federal agencies oversee
noise control in related industries such as aviation, residential and commercial
construction, all aspects of ground transportation, and mining. References to these
regulations can be found in different volumes of the CFR (Code of Federal Regu-
lations) that involve noise control.

11.9. Controlling Noise

If objectionable, excessive or unhealthy noise situations are identified in any en-
vironment, a course of action should be taken to eliminate or reduce the noise
(through design changes or the use of sound-absorbing materials), or if that is not
possible, to provide human protective equipment such as ear plugs, ear muffs, and
specially designed helmets. Further, using Table 11.2 as a guide, potential exposure
to excessive noise can be identified and avoided.

TABLE 11.2. Workplace maximum
permissible noise exposure level versus
daily exposure time.*

Duration (hr/day) Sound level (dBA)
8 90
6 92
4 95
3 97
2 100
15 102
1 105
05 110
0.25 115
0.125 120
0.063 125
0.031 130

*CFR 1910.95(b)(2).
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11.10. Topics for Discussion

1. Inyour daily activities, identify and list the places where you believe that sounds
(noise) are excessive.

2. For places that you deem to have excessive noise, make an estimate of the time
you would want to spend in each place.

3. For places that you deem to have excessive noise, describe any changes that
you might make to reduce the noise level.

4. There will be some places that you consider to have excessive noise where you
need to be, and where you cannot reduce the noise level in any significant way.
Describe how you would protect yourself in such an environment.

11.11. Metric Problems

This information is from OSHA, a United States Agency, and a metric equivalent
is not available. However, since measurements are in the form of ratios, the mea-
surements are the same in Sl units and countries adopting metric units will likely
have similar standards.
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Measuring Distance

12.1. Objectives

1. Understand the advantages and disadvantages of the six common methods of
measuring distance.

2. Be able to use the six common methods of measuring distance.

3. Beableto calibrate distance measuring instruments.

4. Be ableto calculate a correction factor for a systematic error.

12.2. Introduction

Measuring distance and angles with simple instruments are two of the most com-
mon surveying procedures used in agriculture. Even though the instruments may
be simple, asufficient level of accuracy for many measuring jobs can be achieved
with practice and careful work. In this chapter, you will become acquainted with
the basic methods and techniques of measuring distances. The layout and mea-
surement of anglesis covered in Chapter 13.

12.3. Measuring Distances

Several methods and devices can be used for measuring distance. The principal
ones are:

. pacing

odometer

. taping or “chaining”

stadia

. optical range finder

. electronic distance measuring (EDM)

oOUNWNER

One of the decisions that must be made when preparing to measure a distance is
selecting the method or device to use. The following sections will discuss each of
these devices and help the user make that decision.

159



160 12. Measuring Distance

First, it will be helpful to review the common units of distance (displacement).
The common English units are as follows:

1 foot (ft) = 12 inches (in)

1yard (yd) = 3 feet (ft)

1rod = 16.5 feet (ft) = 5.5 yards (yd)

1 mile (mi) = 5280 feet (ft) = 1760 yards (yd) = 320 rods

In the SI system, the units are:

1 meter (m) = 1,000 millimeters (mm)
1 kilometer (km) = 1,000 meters (m)

The units cancellation method is very useful for converting from one unit of
measure to another.

12.3.1. Pacing

Pacing is the simplest and easiest method for measuring distance. Pacing is the
process of walking the distance and counting the number of steps* paces’ to cover
the distance. The distanceis determined by multiplying the number of stepstaken
between two points by one's pace factor. A person’s pace factor is determined by
pacing (walking) a measured distance, usually 300 to 500 ft, several times and
determining the average length of pace (step). With practiceit ispossibleto pacea
distancewith an error of lessthan 2 ft per 100 ft. To achievethat level of precisiona
person must learn to adopt apacing step that isdifferent from their normal walking
step because many factors can cause variations in the length of a person’s pace.
Three of these aretheroughness of the surface, the slope of the ground, and thetype
of vegetation. Care must be taken to ensure that a consistent pace factor is used.

One advantage of pacing for measuring distance is that it doesn’t require any
specialized equipment. The biggest disadvantage is that it requires being able to
walk theroute. Itisnot very useful for measuring distance in rough terrain, across
swamps or any other terrain where an individual could not walk the distance or
walk in astraight line.

Problem: Anindividual paces a 200.0 ft distance three times and counts 62, 60,
and 64 paces. What is the person’s pace factor (PF)?

Solution: To determine a pace factor, divide the measured distance by the average
number of paces. The average number of steps (x) is:

_ 62
o + 60+ 64 &
3
and the pace factor is:
= 2001t =3225...0r 3.2l
62 paces pace

Oncethepacefactor isknown, thelength of an unknown distance can bedetermined
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FIGURE 12.1. Odometer
whee!.

by counting the number of paces required to cover the distance and multiplying
the number of paces by the pace factor.

Problem: Anindividual with a pace factor of 3.2 ft/pace, measures a distance at
375 paces, what isthe distance in feet?

Solution: The distance, in feet, equals the number of paces times the pace factor.
Or:

ft
ft = 3.2 —— x 375 paces = 1, 200 ft
pace

12.3.2. Odometer

An odometer isamechanical device that records revolutions. An odometer wheel
has an odometer and a drive train that records the distance traveled, Figure 12.1.
The common odometer wheel counts the revolutions of awheel and shows the
distancetraveled on amultiple dial readout, Figure 12.2. The dial can be designed
to produce readings in whole feet, decimal feet, feet and inches and meters. The
principle of an odometer wheel is circumference of awhedl times the number of

FIGURE 12.2. Odometer wheel reading of 1,850 ft.
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revol utionsequal sdistance, therefore any wheel can be used aslong asthe diameter
is known and the number of revolutions are counted.

When used correctly, a wheel is more accurate than pacing. An error of 1 ft
per 100 ft can be expected. To be accurate, the wheel must roll along the ground
without slipping. Experience has shown that the accuracy of odometer wheelsis
also influenced by the surface and the topography. An odometer wheel designed to
be used on hard surfaces will not be as accurate on grass or in tall weeds. In these
situations, the accuracy isimproved if the wheel is recalibrated for the surface on
whichit will beused. Seethesection 12.4 & 12.5for an example of the calibration
procedure.

When an odometer is used, the readout should be reset to zero before starting;
then the distance traveled can be read directly. If another type of wheel is being
used, the distance traveled is equal to pi (;r) times the diameter multiplied by the
number of revolutions:

D(@ft)=nxDxN

where D = Measured distance; = = 3.14; D = Wheel diameter (ft); N = Number
of wheel revolutions.

Problem: A bicycle wheel completed 155.2 revolutions asit was rolled along the
boundary of afield. The wheel diameter is 2.16 ft. What is the length of the field
(fy)?

Solution:
ft
D(fty =7 x Dx N =314 x 216 =y x 155.2 rev

= 1052.628 ... or 1,050 ft

One advantage of odometer wheels over pacing is the increased accuracy, but
they still must berolled along the surface in astraight line to measure the distance.

12.3.3. Taping

The most accurate traditional method of measuring distances uses a steel tape.
When proper procedures are followed the error will belessthan 1.0 ft in 3,000 ft.
The standard equipment for ataping party, usually at least three people, consists
of atape, two range poles, aset of 11 chaining pins, two plumb bobs, ahand level,
and a field notebook. Individual items of taping equipment are described in the
following paragraphs.

12.3.3.1. Surveyor’'sChain

The traditional device for measuring distance accurately is the surveyor's steel
chain. Today accurate surveyor’s chains constructed of non metalic materials are
available. The modern standard steel chain is 100 ft long and 3/8 inch wide, and
weighs 2 to 3 |b per 100 ft. The older tapes are graduated with marks set in
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FIGURE 12.3. Segment of Babbitt style tape.

Babbitt-metal bosses with each foot marked, from 0 to 100 ft. Notice that the tape
between the first and second foot mark does not have any graduations. Thisisthe
common design of surveyor’s chains.

Newer surveyor’s chains have the marks etched on the face of the tape. Highway
chainsarefully graduated, but the traditional surveyor’s chain only subdivides one
foot of the tape. The subdivisions are usually in tenths or hundredths of a foot.
The graduated foot may be thefirst foot, asin Figure 12.3, or in an extended foot,
Figure 12.4. A chain with thefirst foot graduated is called a cut chain and achain
with the extend foot is called an add chain.

Determining the style of chain that is being used is important otherwise it is
easy to have an error of one foot when reading an add or cut tape incorrectly,
Figure 12.5.

Metal surveyor’s chains are manufactured from an alloy of stedl. It is very
important to wipe them down with a clean rag after each use and lightly oil them
periodicaly to prevent them from rusting. They are also very easy to break by
bending them sharply or pulling aloop tight.

12.3.3.2. Tapes

Tapesare popular for making rough measurements or when the accuracy of achain
is not needed. Tapes are constructed of metal and different nonmetallic materials.
Tapes are usualy fully graduated and range in length from 25 to 200 ft.

FIGURE 12.4. Typical add tape.

FIGURE 12.5. Segment of cut tape.
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FIGURE 12.6. Range pole.

Nonmetallic tapes are usually lighter and easier to use. They require less main-
tenance and are not as easily damaged by moisture. Inexpensive nonmetallic tapes
will stretch under tension and therefore are not as accurate as steel chains or tapes.

12.3.3.3. Chaining Pins

Chaining pins are made of heavy gauge wire and are 12 to 15 inches long, are
painted red and white, and sometimes have a bright cloth attached to help locate
them in tall grass. They are used to mark the end of each tape length and come
with 11 pinsin a set; One pin is used to mark the start of the chaining (taping),
and the remaining 10 pins are used to mark lengths of tape. When all 11 pins have
been used, assuming a 100 ft tape, 1,000 ft has been measured.

12.3.3.4. Range Poles

Range poles are 1-inch-diameter tubular steel or nonmetallic shafts 6 to 10 ft long
with one pointed end. They are dternately painted red and white and are used for
“lining in” when oneis taping or measuring angles, Figure 12.6.

12.3.3.5. Plumb Bobs

Plumb bobs with 6 to 10 ft of cord attached are used when measuring horizontal
distances on sloping or irregular ground to transfer the distance from the horizon-
tally held tape to the point on the ground. They also are attached to a surveyor’s
level, to locate the level over a stake, when one is measuring distances by stadia
or EDM, or laying out angles, Figure 12.7.

12.3.3.6. Hand Level

A hand level consists of asmall sighting tube 5 to 6 inches long equipped with a
spirit level, aglasstube filled with aliquid and a bubble. The image of the bubble
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FIGURE 12.7. Plumb bob.

is reflected by a prism and can be observed by looking through the tube. The
instrument is held to the operator’s eye and is leveled by raising or lowering the
end until the cross-hair intersects the image of the spirit-level bubble. Thisis a
low-precision instrument used to make rough measurements of the slope and as
an aid in keeping the surveyor’stape level. Newer models may also include stadia
cross-hairs and direct-reading angle scales, Figure 12.8.

12.3.3.7. Taping Procedures

There are six basic steps involved in taping: (1) lining in, (2) applying tension,
(3) plumbing, (4) marking tape lengths, (5) reading the tape, and (6) recording the
distance.

Pre computer and pre calculator taping methods were measured by stations. A
distance of 100 ft is called a full station and is written as 1 + 00 ft. A distance
of 123 ft iswritten as 1 4+ 23 ft. The modern practice is to record al distancesin
decimal feet.

For many surveys the intent is to discover the true horizontal distance between
two points. Three methods are commonly used: (1) tape and plumb bob, (2) tape
and calculation, or (3) Electronic distance measuring (EDM). When method two
is used, either the percent slope, change in elevation or vertical angle must be
measured so that the horizontal distance can be calculated. When an EDM isused

FIGURE 12.8. Hand levdl.
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FIGURE 12.9. Effect of ground
slope on true horizontal
distance.

the distance is horizonta if the instrument is horizonta at the time of measure-
ment.

The need for horizontal measurementsisillustrated in Figure 12.9. When mea-
sured along the surface of the ground, the distance would be 26.1 ft, whereas the
true horizontal distanceis 25.00 ft.

When slope distance is measured and the desired result is horizontal distance,
either the percent slope, differencein elevation or the vertical angle must be mea-
sured and the true horizontal distance calculated or determined from tables. The
percent slope can be measured by a hand level or a surveying level. When the
percent slope is known the horizontal distance can be determined through the use
of the slope eguation and the Pythagorean theorem.

Problem: Determine the horizontal distance when the slope distance is 234.5 ft
and the percent slopeiis 3.4%.

Solution: The first step is to determine the amount of change in elevation that
occurs. This can be done using the slope equation:

rise
% Slope = > 100

%Slope x run 3.4 x 234.5ft
100 B 100
Where the rise is the change in elevation and the run is the horizontal dis-

tance, the horizontal distance can be determine by rearranging Pythagorean’s
theorem:

rise = = 7.973ft

b = a2 — c2=/234.52 — 7.9732 = 234.36...0r 234.4 ft

Table 12.1 can a so be used to determine the horizontal distance for various slopes
up to 30%. Note that for slopes up to 5% the correction factor is less than 0.125
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TaBLE 12.1. Correction factors for
converting slope distance to horizontal

distance.
True horizontal
Correction factor distance
Slope (ft/200 ft) (200 ft)
1 0.005 99.995
2 0.020 99.980
3 0.045 99.955
4 0.080 99.920
5 0.125 99.875
6 0.180 99.820
7 0.245 99.755
8 0.321 99.679
9 0.406 99.594
10 0.501 99.499
11 0.607 99.393
12 0.723 99.277
15 1.131 98.869
18 1.633 98.367
20 2.020 97.980
25 3.175 96.825
30 4.606 95.394

ft/200 ft (1.5 in/100 ft), but the correction factor increases more dramatically
after 5%.

When Table 12.1 is used, the correction factor per 100 ft is multiplied by the
slope distance and divided by 100, and the product is subtracted from the slope
distance. It is important to remember that the correction factors are for 100 ft of
distance. You must divide the measured slope distance by 100 first:

SD
HD=SD— ([ — CF
<<100) ) )
where HD = Horizontal distance; SD = Slope distance; CF = Correction factor.

Problem: UseTable12.1to determinethe horizontal distance (HD) whentheslope
distance (SD) is 623.82 ft and the slope is 12.0%.

o-- ()9

623.82 ft
= 623.82ft — ((W) X 0.723)

= 623.82 ft — 4.5102186 = 619.309... or 619 ft

Solution:
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FIGURE 12.10. Measuring sloping ground by breaking chain.

When the ground slope is not uniform, the slope and the slope distance for each
segment of the line must be determined and a separate correction applied to each
segment.

When the horizontal tape method is used, one end of the tape is held on the
ground, while the other end israised until the tape is horizontal. The true distance
istransferred to the ground from the el evated end of the tape by aplumb bob. When
theslopeismorethat 5%, itisnecessary to useaprocessknown as*” breaking chain.”
In this method the head chainman lays out the full length of the tape. The 100-ft
length then is divided into convenient increments, usually 25 or 50 ft, with the
chainman holding the tape horizontal and plumbing down to the ground at each
increment. This processisillustrated in Figure 12.10. In this example, the chain
was “broken” into 25-ft sections. Every 25 ft a plumb bob and line was used to set
apin.

For accurate results, ataping activity must bevery carefully thought out and well
organized. Thefollowing procedure for taping is recommended to ensure accurate
results. A taping party consistsof at least three people: the head chainman, the rear
chainman, and a note keeper. An axe man also may be necessary in brushy areas.
The 11 chaining pins serve as temporary markers for each station, and also help
to count the number of full stations measured.

The head chainman begins by setting a pin for the starting point and then leads
off with the 100 foot end of the tape. After one full station has been measured, the
head chainman will have placed one pin in the ground at the beginning and one to
mark the end of the first station. At this point he or she will have 9 pinsleft on the
ring. Asthe chainis moved to the next station, the rear chainman does not pull the
pin used to start the chaining. He only pullsthe pins used at the 100 ft marks. After
two full stations, the head chainman will have placed three pinsin the ground and
have 8 pins on thering, and the rear chainman will have onein hand and oneinthe
ground. If this system is carefully followed, the number of full stations measured
will always be the same as the number of pins held by the rear chainman.

Asdescribed above, most surveyor’stapesare graduated in feet throughout their
full length, with the first and/or last foot of the tape graduated in tenths or tenths
and hundredths of afoot. A different procedureisrequired for measuring adistance
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shorter than a full tape length. When the party nears the end of the line and the
remaining distance is less than 100 ft, the rear chainman holds the zero mark on
the last pin and the head chainman pulls the chain taunt. The head chainman then
moves the chain forward to the last foot mark if aadd chain is used or backward
to the next foot mark if a cut chain is being used. They both read the tape and
therear chainman’s reading is subtracted from the head chainman’s reading when
acut tape is used. The rear chainman’s reading is added to the head chainman’s
reading when an add tape is used. For example, suppose that an add chainisbeing
used and the head chainman reads 53 ft, and the rear chainman reads 0.21 ft. If the
rear chainman has 6 pins, the total length of thelineis 653.21 ft [(6 x 100) + (53
ft + 0.21 ft)]. If acut chain was being used the distance would be 652.79 ft [(6 x
100 ft) + (53 ft — 0.21 ft)].

Thefollowingrules, if carefully followed, will help guaranteeaccuracy intaping.

1. Align the tape carefully, and keep the tape on the line being measured.

. Keep auniform tension of 15 Ib of pull on the tape for each measurement.

3. Keep in mind the style of tape being used to avoid an error of 1 or 2 ft at each
end of the tape.

4. “Break chain” on slopes as necessary to keep the tape level, or calculate the
percent slope if measuring with the tape on the ground.

5. Carefully mark each station and keep an accurate count of the stations.

N

12.3.4. Stadia

Measuring distance by stadia relies upon a fixed angle being designed into the
instrument. “ Stadia’” comes from an early Greek word for aunit of length. Survey-
ing instruments equipped for stadia measurement have two additional horizontal
cross-hairs, caled stadia hairs. They are placed equidistant above and below the
horizontal leveling cross-hair, Figure 12.11.

The distance between the stadiahairsand the horizontal cross-hair isfixed by the
manufacturer to provide a constant stadia interval factor (SIF) for the instrument.
The most common stadiainterval factor is 100. Instruments that have a SIF of 100
will have a one foot stadia interval, that is the difference between the top stadia
reading (TSR) and the bottom stadia reading (BSR), when the rod is held 100 ft
away from the instrument, Figure 12.12.

FIGURE 12.11. Principles of stadia.
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FIGURE 12.12. Measuring distance by stadia.

Theangleformed by reading thetop and bottom cross-hairsisconstant, therefore
the unit of the measure is determined by the unit of measure of the rod. When a
Philadel phia style rod is used without the target the distance will be in units of
feet. When ametric rod is used the distance will be in units of meters. When the
stadia method is used to measure a distance, the instrument person reads the TSR
and the BSR, and then mulltiplies the difference by the stadiainterval factor. In the
form of an equation:

D (ft) = (TSR — BSR) x 100

Refer to Figure 12.13. Thetop stadia hair reading (TSR) is 6.29, and the bottom
stadia hair reading (BSR) is 3.71. Thus the stadia interval is equal to 6.29 minus
3.71, or 2.58 ft. The distance from the instrument to the rod is equal to 2.58
multiplied by 100, or 258 ft.

Problem: What is the distance to the rod if the stadia readings are TSR = 6.07
and the BSR = 3.02?

Solution:

D (ft) = (TSR — BSR) x 100 = (6.07 ft — 3.02ft) x 100 = 305 ft

FIGURE 12.13. Example using stadia.
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12.3.5. Optical Range Finders

Many different technol ogies are used with optical rangefinders. One simpletype of
instrument operates on the function of triangles. When the operator 1ooks through
the eyepiece, when the instrument is not set for the distance, they will see two
identical images. The operator adjusts the focus until two images are in coinci-
dence, superimposed on top of each other. The distanceisread from ascale on the
instrument. Optical range finders have an acceptable level of accuracy for recon-
naissance or sketching purposes for short distances, but the error increases as the
distance increases.

12.3.6. Electronic Distance Measurement (EDM)

EDM instruments determine lengths based on the time that it takes for an energy
wave to travel from one end of aline to the other and return. They have replaced
the difficult and painstaking task of taping for accurate measurement of horizontal
distances. They also can measuredistance over bodiesof water or other inaccessible
terrain aslong as they have a clear line of sight. Some require a reflective surface
to bounce the beam back, some are reflector less. Others use asecond unit to return
the signal or areflector, Figure 12.14.

EDM'’s use an energy beam to send asignal to areflector or areflecting object
and measure the time elapse from when the beam was sent and when it returns to
the instrument. Distance is determined by rearranging the vel ocity equation.

v ( ft )_ Distance (ft)

min)  Time (min)
. ft ' )
Distance=V [ — ) x Time(min)
min

A big advantage of EDM’s is that the operator does not need to walk the path, all
they need isalineof sight. They can also be used when theline of sight isobscured
by fog or light rain.

FIGURE 12.14. An example of an EDM.
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12.4. Calibration Procedure

Measuring instruments are mechanical/electrical devices. Their accuracy will
sometimes change with use, and is guaranteed to change with abuse. Checking
the accuracy of instruments is called calibration. Instruments are calibrated by
checking their performance against a standard. The measured difference in the
length or angle between the averaged measurements and the standard, iserror. This
error can be arandom error or a systematic error. Random error is unpredictable
and must be controlled by following recommended techniques and procedures.
Systematic errors are usually caused by damage or wear to the instrument. If the
calibration process indicates a systematic error, an error that is constant with each
measurement, then a correction factor can be calculated so that each measurement
taken with the instrument can be corrected.

12.4.1. Determining Correction Factor

During the measurement of a known 50.0-ft distance with an odometer wheel
measurements of 49.9, 49.8, and 49.7 ft were recorded. What is the correction
factor?

Solution: Thefirst step isto determine the average distance.
(49.8+49.8 + 49.7)/3 = 49.8

CE (E) _ Known distance — Measurement
ft Known distance

50.0ft —49.8ft ft of error
50 ft ~ 7 ft of distance

This instrument will have 0.004 ft of error for every foot of distance it measures.
Once the correction factor is determined it can be used to adjust each of the
measurements for the error in the equipment.

Problem: Determine the corrected distance for a measured distance of 150.5 ft
when the instrument has an error of 0.004 ft/ft.

Solution:

ft
D, = 150.5ft 4 (150.5 ft x 0.004 f_t)

= 150.5 ft + 0.602 = 151.102 = 151.1 ft
The corrected distanceis 151.1 ft.

12.5. Metric Problems

Problem: Determine the pace factor for an individua that counted 132, 134, and
133 paces for adistance of 100 meters.
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Solution:
Distance 100 m 100 m m
Paces 133+ 134+ 132 133 paces pace
3

Problem: An individual with a pace factor of 0.65 m/pace counts 380 paces for
the unknown distance. What is the distance?

Solution:

D=PF x P
m
= 0.65 — x 380 paces = 247 m
pace

Problem: A wheel with adiameter of 70 cmisused to measure adistance by rolling
it along the ground. It was rolled 124 revolutions. What is the distance?

7 x dia .
D = ———— x revolutions
revolution

70 cm
:L x 124 rev x

1
= 272.69...0r 27
lrev 100 cm 69...orzr3m

Problem: UseTable12.2to determinethehorizontal distance (HD) whentheslope
distance (SD) is 350 m and the slopeis 12.0%.

TABLE 12.2. Correction factors for converting
slope distance to horizontal distance.

True horizontal

Correction factor distance

Slope (m/200 m) (100 m)
1 0.01 99.99
2 0.02 99.98
3 0.05 99.95
4 0.08 99.92
5 0.13 99.87
6 0.18 99.82
7 0.25 99.75
8 0.32 99.68
9 041 99.59
10 0.50 99.50
11 0.61 99.39
12 0.72 99.28
13 1.13 99.15
14 1.63 99.02
15 1.13 98.87
18 1.63 98.37
25 3.18 96.82

30 4.61 95.39
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Solution:

SD

=350m — ((%) X 0.72) =350m — 252 = 347.480r47.5m

Problem: Determine the horizontal distance when the stadia method is used with
a metric rod. The top stadia reading is 1.23 m and the bottom stadia reading is
0.82m.

Solution:
D (m)=(TSR—-BSR) x 100

=(123-082) x 100=041 x 100=41m

Problem: Determine the corrected distance for a measured distance of 750.5 m
when the instrument measured distances of 49.8, 49.8, 49.7, and 49.8 metersfor a
standard distance of 50 m.

Solution: The first step is to determine the correction factor. Before determining
the correction factor the average measurement must be calculated.

49.8 4+ 49.8 4 49.7 4 49.8
Distance = + : + =49.775m
m Known distance — Measurement
CF (—) - :
m Known distance
0m— 49.77 f
_ 00m-49.775m _ ) gy MoOferror
50m m of distance

Thelast step isto use the correction factor to determine the corrected distance.

Distance = Measurement -+ Correction

m
— 750.5m + (750.0 m x 0.0045 E>

= 750.5m+ 3.375m = 753.875 or 735.9 m
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Angles and Areas

13.1. Objectives

1. Be able to use three indirect methods to lay out and/or measure angles.

. Be able to find the area of standard geometric shapes.

3. Be able to determine the area of irregular-shaped tracts of land by division into
standard geometric shapes.

4. Be able to determine the area of irregular-shaped tracts of land using two trape-
zoidal equations.

N

13.2. Introduction

The layout and measurement of angles are very important parts of agricultural
surveying. In this section, you will learn, using simple tools and procedures, three
indirect methods that can be used to lay out a perpendicular (90°) angle and one
method that can be used to lay out or measure any angle between 0° and 90°.
These procedures are useful in planning buildings and fences and in determining
the corner angles of irregular-shaped tracts, fields, and/or smaller areas.

13.3. Angles

Surveyors label the three parts of an angle as the backsight (base line), the vertex and
the foresight. Angles can be measured or laid out using instruments, direct method,
or by measuring, indirect method. There are three common indirect methods for
measuring or laying out an angle. Two of these are limited to 90° angles, the chord
method and the 3-4-5 method, the third, tape sine, can be used with any angle
between 0° and 90°. The following discussion illustrates all three methods.

13.3.1. Chord Method

A chord is a line connecting any two points on a circle. This geometric principle
can be used to lay out a line at a 90° angle to a base line. This method is very

175
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FIGURE 13.1. Laying out a
right angle by the chord
method.

simple and can be accomplished with two different lengths of string or even tree
branches. The one disadvantage is that the base line must be extended past the
turning point (B). This method is illustrated in Figure 13.1

The line BD is established at a 90° angle by completing the following steps:

. Establish the base line AC if it is not in existence (fence or road edge, etc.).

. Establish the vertex at B.

. Set points X and Y equidistant from point B and on line AC.

. Use a length greater than the distance XB or YB for Z, and scribe an arc from
X and Y as shown.

5. Set a stake at the intersection of the two arcs (D).

6. The line established by this stake and B will be at 90° with the base line AC.

A WN PR

This method is simple in principle but not easy to complete because of the difficulty
in marking the arcs. On tilled ground they can be formed by marking the surface, but
when working on grass or taller vegetation it is much more difficult. An alternative
is to use two tape measures. Attach one at X and the other at Y. Any point where
both tapes have the same reading will be on a 90 degree angle from the base line.

13.3.2. 3-4-5 Method

The 3-4-5 method of laying out a right angle is based on the Pythagorean theorem:
for any right triangle, the square of the hypotenuse is equal to the sum of the
squares of the other two sides. In this method, any multiples of 3 and 4 used as
the sides of a right triangle will result in the hypotenuse being a multiple of 5. To
prove this, study the following equation:

5= VI TR
=25
5=5

Shown graphically, Figure 13.2.
This method has three requirements: (1) the same units (feet, yards, etc.) must
be used on all three sides; (2) the same multiples of 3, 4, and 5 are used for the
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FIGURE 13.2. Principles of right triangles.

lengths of the three sides; (3) the longest length is used for the hypotenuse. When
these three requirements are met, a 90° angle will be established.

When using the 3-4-5 method to lay out a right angle the easiest way is to use
three people and two tape measures. When two tapes are used, either the 3 or
the 4 dimension is used as the base line, and the two corners on the base line are
marked. Then two people, one standing at each base line corner, hold two tape
ends together at the correct dimensions, and a third person holds the remaining
tape ends together at the correct dimensions and moves the third corner until the
tapes are all at equal tension.

This process also may be accomplished by using a 100-ft tape. Because sur-
veyor’s steel tapes are not designed to be bent at a sharp angle, loops must be
formed at two of the corners. It is recommended that at least a 5-ft loop be used.
Study Figure 13.3.

By completing the following steps, a 90° angle may be laid out using the 3-4-5
method. This procedure will require three people.

1. Establish the base line (AB) and corner B.

2. Lay out the tape along the base line with the 20-ft mark (4 ft x 5 ft) at corner
B and the zero mark at corner A.

3. Set corner A, and have a person hold the zero mark on the corner.

4. Form a 5-ft loop in the tape, and have a person hold the 20-ft mark over the
25-ft mark, and align these marks over corner B.

5. Lay out the remaining tape in the direction of corner C.

6. Note the position of the 40-ft mark (25 ft + 15 ft) (15 ft = 3 ft x 5), and form
a 5-ft loop in the tape. Hold the 40 and 45 ft marks on corner C.
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Q — 40 & 45 foot marks
C
25 ft
15 ft
20 & 25 foot marks 0 & 70 foot marks

(s 20 ft A \

Base line

FIGURE 13.3. Laying out a right angle by the 3-4-5 method using a 100-ft tape.

7. Extend the tape back to corner A.

8. Hold the 70 ft (45 ft + 25 ft) (25 ft = 5 ft x 5) and 0 foot marks together at
corner A.

9. If the individuals at A and B hold their positions carefully on the baseline while
the individual at C tightens the tape in both directions, a 90° angle will be made
at B.

This process will work for any combination of lengths as long as they are multiples
of 3, 4, and 5. One advantage of this method is that the base line does not need to
extend past the 90° corner.

13.3.3. Tape-Sine Method

The tape-sine method uses a combination of distances measured by a tape and the
sine trigonometric function. This method is not limited to 90° and can also be used
to lay out an angle or measure the angle between two existing lines. A review of
the three commonly used trigonometric functions will make this method clear.
Trigonometric functions are based on the principle that one unique ratio exists
between the lengths of any two sides for angles B and C, Figure 13.4. Because a
right triangle has three sides, each angle (B and C) has six possible combinations of
two sides. Each of these combinations has been given a name. The three common
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FIGURE 13.4. Notation for right triangle. C
a
b
B = A
ratios are:

Length of opposite side (b)

Sine B =
ne Length of hypotenuse (a)
. Length adjacent side (c)
B=
Cosine Length of hypotenuse (a)
Tangent B = Length opposite side (b)

Length adjacent side (c)

The same relationships are true for angle C. Each of these functions forms an
equation with three variables—the function of the angle and the lengths of two
sides. If any two of the variables are known, the third can be determined.

In the tape-sine method, only the sine function is used. The procedure for laying
out an angle (@) is slightly different from the procedure for measuring an existing
angle.

The procedure for measuring an existing angle will be explained first. Using the
example illustrated in Figure 13.5, the task is to determine the angle formed by
BAC. The first step is to mark an equal distance along each side AB and AC. The

FIGURE 13.5. Example of tape-sine method.
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next step is to measure the distance BC. The last step is to form two right triangles
by drawing a line from corner A to the mid point of line BC.

The distances BC/2 and AC are two sides of a right triangle. For this example
we will assume that the distance BC = 61.8 ft. The angle for either triangle can
be found by using the Sine equation.

Length of opposite side (b)
Length of hypotenuse (a)

Distance BC/2 . 30.9 ft
Distance AC ~ 100 ft

Sine B =

= 0.309

The value 0.309 is the sine ratio of angle A. The next step is to determine the angle
having a sine ratio of 0.309.

To determine the angle using a calculator, enter 0.309 and the inverse of the sine
function. The angle can also be determined by consulting Table 13.1.

TABLE 13.1. Sine values.

Angle 0° Sine of the angle  Angle 0° Sine of the angle  Angle 0° Sine of the angle

0 0.000 31 0.515 61 0.875
1 0.017 32 0.530 62 0.883
2 0.035 33 0.545 63 0.891
3 0.052 34 0.559 64 0.899
4 0.070 35 0.574 65 0.906
5 0.087 36 0.588 66 0.914
6 0.105 37 0.602 67 0.921
7 0.122 38 0.616 68 0.927
8 0.139 39 0.629 69 0.934
9 0.156 40 0.643 70 0.940
10 0.174 41 0.656 71 0.946
11 0.191 42 0.669 72 0.951
12 0.208 43 0.682 73 0.956
13 0.225 44 0.695 74 0.961
14 0.242 45 0.707 75 0.966
15 0.259 46 0.719 76 0.971
16 0.276 47 0.731 77 0.974
17 0.292 48 0.743 78 0.978
18 0.309 49 0.755 79 0.982
19 0.326 50 0.766 80 0.985
20 0.342 51 0.777 81 0.988
21 0.358 52 0.788 82 0.990
22 0.375 53 0.799 83 0.993
23 0.391 54 0.809 84 0.995
24 0.407 55 0.819 85 0.996
25 0.423 56 0.829 86 0.998
26 0.438 57 0.839 87 0.999
27 0.454 58 0.848 88 0.999
28 0.469 59 0.857 89 1.000
29 0.485 60 0.866 90 1.000

30 0.500
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FIGURE 13.6. Laying out an angle by the
tape-sine method.

Either source should give an angle of 18°. Because we used the distance BC/2 to
solve for the angle, the angle CAB is actually 18° x 2, or 36°.

The same procedures can be used to lay out an angle. For example, suppose
you need to establish a fence at 40° to an existing fence. How would the tape-sine
method be used? Study Figure 13.6.

The principles involved are basic trigonometry. It takes two points to establish
a line and to locate a point either three dimensions or an angle and one dimension
must be known. To establish the line AC so that it forms a 40° angle with the base
line AB, three dimensions are used to locate point C. Two of the dimensions are
the distance selected by the person laying out the angle. In this example 50 ft is
used. The third dimension is the distance from point B to point C. To determine
this dimension mentally split the triangle CAB into two right triangles (BAD and
CAD), solve for the length of the opposite side of either, and then double this
distance. The doubled distance is distance from B to C. The distance A to C is the
same as A to B. Using point B and the length BS scribe a short arc in the vicinity
of point C. Using point A and the length AB scribe another arc. The intersection
of the two arcs is point C. A line from point A through C will establish the fence
at the correct angle.

To determine the distance BC/2 the sine trig functions is rearranged to solve for
the length of the opposite side:

Sine A = %
Opposite = Sine A x Hypotenuse
= Sine 20° x 50.0 ft
= 0.3420... x 50.0 ft
= 17.1010... ft

17.1010... x 2 = 34.2020... or 34.2 ft

To lay out the angle, mark an arc, with a radius of 34.2 ft, from point B and
another arc, with a radius of 50, from point A, and set a pin at the intersection of



182 13. Angles and Areas

FIGURE 13.7. Irregular-shaped field.

the two arcs (point C). A line drawn from point A through point C will establish a
line at a 40° angle to the base line (AB). In this method, the marking of two arcs
could also be eliminated by using two tape measures.

13.4. Areas of Standard Geometric Shapes

One of the most common applications of surveying is to measure the area of a
lot, field, farm, or ranch. When a high level of accuracy is required, a professional
engineer or a land surveyor should be employed. If this level of accuracy is not
required, many areas can be determined with nothing more elaborate than a steel
tape and the application of area formulas from geometry. The area of an irregularly
shaped field can be found by subdividing it into standard shapes, determining
the areas of the subdivisions by calculation, and then summing the areas of the
subdivisions to find the total area. For example consider Figure 13.7.

There is no right or wrong way to divide the field. The goal is to collect the
required measurements with the expenditure of the least amount of resources. The
best way will depend on the equipment used and the obstacles that exist in the field.

Figure 13.8 shows two different ways to divide the irregular-shaped field into
standard shapes. Either method will determine the area. Method B will probably
take less time and resources because it will require fewer measurements. To use
this method, it is necessary to apply the correct area formula for each common
geometric shape. The next section will review the common shapes and the area
formula for each.

FIGURE 13.8. Two alternatives for dividing irregular-shaped field into standard shapes.
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FIGURE 13.9. Triangle area with base and height known.

13.5. Triangle

Three different equations can be used to determine the area of a triangle, depending
on the known dimensions of the triangle.

13.5.1. Base and Height

The first equation that can be used is when the base and height are known, see
Figure 13.9.

This is the easiest equation to use when calculating the area of a triangle, but
it is difficult to collect the required dimensions. The difficulty is determining the
intersection of the height with the base line. If the triangle is equilateral (A), or
an isosceles triangle, the problem is not as difficult because the intersection is one
half of the distance of the base line. When the triangle is not an equilateral triangle,
the intersection is much more difficult to determine. The equation is:

Azéxbxh

where A = Area; b = Length of base; h = Height perpendicular to base.

Problem: What is the area of a triangle (ac) with a base 150.0 ft long and a height
of 100.0 ft.

Solution:

1
A= 7 X 150.0 ft x 100.0 ft = 7,500 ft?

lac
acre = ———— x 7,500 ft* = 0.17217... or 0.1722 ac
43,560 ft

13.5.2. Three Sides

The second type of triangle is one where the lengths of the three sides are known,
Figure 13.10. This method for determining the area of a triangle is easier to use
because the only measurements are the three sides of the triangle. The shape of
the triangle doesn’t influence the difficulty in completing the measurements.
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FIGURE 13.10. Triangle area with
three sides known.

The primary limitation of this method is the requirement of measuring the length
of all three sides. This method cannot be used if one or more of the side lengths
cannot be measured. The equation for area is:

_a+b+c

A=,/S(S—a)(S—b)(S—c) S >
where a, b, and c are the lengths of the three sides.

Problem: Determine the area (ft?) for a triangle having sides measuring 650.0 ft,
428.0 ft, and 282.0 ft.

Solution:
_a+b+c 6500 ft+428.0 ft +282.0 ft
B 2 N 2

A = ,/680.0 (680.0 — 650.0) (680.0 — 428.0) (680.0 — 282.0)

S = 680.0

= ,/680.0(30.0) (252.0) (398.0)

= /2046038400
= 45,233.15598 or 45,230 ft?

13.5.3. One Angle and Two Sides

The third type of triangle illustrated is one in which one angle and the length of
the two adjacent sides is known, Figure 13.11.

The limitations on this method are that the angle must be less than 90° and the
at least one angle must be known or measured. The equation for area (A) is:

1
A=§X(bXCX sine 6)

where A = Area; b = Known side; ¢ = Known side; 8 = Angle between sides
b and c; sine = Sine trigonometric function.

This equation is very useful in situations where one side of the triangle cannot
be measured.
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C

FIGURE 13.11. Triangle with one angle and the adjacent sides known.

Problem: Determine the area (ft?) of a triangle with sides of 350.0 ft and 555.0 ft
and an included angle of 45°.

Solution:
1 . 1 .
A= 3 xaxbxsined = 3 x 350.0 ft x 555.0 ft x sine 45
137355.4922
== = 68677.746 . .. or 68,700 ft

13.6. Rectangle, Square, and Parallelogram

These shapes are considered together because their areas are calculated by the
same equation.

Remember that the height (h) for a parallelogram is perpendicular to the base
(b), see Figure 13.12. The equation for area is:

A=bxh
where A = Area; b = Length of base; h = Height perpendicular to base.

Rectangle

Square

Parallelogram

>
>

b b

FIGURE 13.12. Base and height for rectangles, squares and parallelograms.
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Problem: What is the area (ft?) of a rectangle measuring 1320.0 ft by 660.0 ft?
Solution:
A=Dbxh=1320.0ft x 660.0 ft = 871,200 ft?

Problem: What is the area (ac) of a parallelogram where the base measures
1,050.0 ft, and the height measures 750.0 ft?

Solution: The area equation can be used and then the square feet converted to
acres, but the acres conversion can be added to the area equation:

1ac
Alae) = bxh x e
1lac
= 1,050.0 ft x 750.0 ft x ————
43,560 ft

= 18.078...0r 18.08 ac

13.7. Circle or Sector

The area of a circle, in a slightly different form, was used in Chapter 5 in figuring
engine displacement.

A=mr?

where A = Area; 7 = 3.14; r = Radius of the circle.

A sector is slice of a circle. The known dimensions, the angle or the arc length,

dictate the equation used to solve for the area of the sector. Study Figure 13.13.
When the angle is known, the equation for a sector is:

_nxr2x9
T 360

where A = Area; 7 = 3.14; 6 = Included angle of the sector; r = Radius of sec-
tor.

Circle Sectors

/\/

r

/

\ Arc length

Ficure 13.13. Circle and sectors.
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When the length of the arc is known, the equation for a sector is:

__rxarc length
B 2
Problem: Find the area of a circle (ft?) having a radius of 75.0 ft.

Solution:
A=m xr?=314 x (75.0 ft)> = 17662.5 or 17,700 ft?

Problem: Find the area of a sector (ft?) having a radius of 135.0 ft and an angle
of 60.0°.

Solution:

A_TXTEx0 314 x (135.0ft) x 60.0°
© 360 360
_ 3,433,590

360

Problem: What is the area of a sector (ac) if the radius is 100.0 ft and the arc length
is 210.0 ft?

= 9,537.75 or 9,540ft?

Solution: (Adding the conversion value from square feet to acres):
r x arc length lac
X
2 43,560 ft?

100.0 ft x 210.0 ft y 1ac
2 43,560 ft?

A=

21,000

= — =0.24104... 241
87,120 0 or0 ac

13.8. Trapezoid

A trapezoid is a four-sided figure with only two parallel sides. Note that the height
must be measured perpendicular to the parallel sides, Figure 13.14.

b b

FIGURE 13.14. Two types of trapezoids.
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The area of a trapezoid is determined by the equation:

a+b
A=h -—
<(*2)

where A = Area; h = Height (distance between the parallel sides); a = Length
of one parallel side; b = Length of the second parallel side.

Problem: What is the area (ac) of a trapezoid with parallel sides of 300.0 ft and
450.0 ft, and with a height of 120.0 ft?

Solution: (using conversion to acres):
a+b lac
A=hx < + )

X
2 43,560 ft?
300.00 ft + 450.00 ft 1
:120.0ft><( i >>< x
2 43,560 ft
lac
= 45,000 ft* x ————
43,560 ft

= 1.03305... or 1.033 ac

13.9. Determining Areas of Irregular-Shaped Fields Using
Standard Geometric Shapes

Very few agricultural fields or lawns are standard geometric shapes. They may
not be as complicated as the field illustrated in Figure 13.15, but the principles

150.0 ft

FIGURE 13.15. Example of determining the area of an irregular shape.
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for determining areas are the same. The total area is the sum of each individual
area. The key to efficient calculations is dividing the irregular shape into the fewest
possible number of standard shapes.

Shape A is a sector of a circle with a known radius and angle. The area of this
shape can be found by using the sector equation.

_wxrix¢ mx 686ft x 812

Axr = —
A 360 360
12004778
260 3334.66... or 3,330

Shape B is a triangle with the length of the sides known.

b+c
As=+/S(5—2a)(S—b)(S—0) s=¥
. a+k2)+c _ 68.6ft+79.ift+115.4ft _ 2623.2 a1e

Ag =+/S(S—a)(S—b)(S—c)
= /131.6 (131.6 — 68.6) (131.6 — 79.2) (131.6 — 115.4)

= /131.6 (63) (52.4) (16.2) = +/7037894.304 = 2652.90. .. or 2,650 ft>

Shape C is another triangle with the lengths of all three sides known.

b
As=/SE—a)(S—b)(S—0) s:#
g_ath+c 684ft+707fi+11541 2545

2 2 2
As =+/S(S—a)(S—b)(S—c)
= /127.25(127.25 — 68.4) (127.25 — 70.7) (127.25 — 115.4)

= ,/127.25 (58.85) (56.55) (11.85) = +/5018283.793
= 2240.15. .. or 2,240 ft?

Area D is a triangle with one angle known and the length of the adjacent sides.
The area (Ap) is:

1 1
Azixaxbx sine9=§x70.7ftx161.2ft><sine59.0

_ 11396.84 x 0.8571...  9768.99...
- 2 - 2

— 4884.49. .. or 4,880 ft?
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Shape E is the same as shape D. The area of shape E is:

A= % xaxbxsined = % x 161.2 ft x 150.0 ft x sine 38.3

24180 x 0.61977...  14986.25...

= = 7493.12... or 7,490 ft?
2 2

Now that the area for each shape is known, the total area (At) is calculated by
combining the areas for the individual shapes:

At = Aa+ Ag + Ac+ Ap + Ae
= 3330 ft? + 2650 ft? + 2240 ft? + 4880 ft? + 7490 ft?
= 20590 or 20,600 ft?

13.10. Determining Areas of Irregular-Shaped Fields Using
Trapezoidal Equations

Occasionally it becomes necessary to determine the area of a field or other property
that has one irregular-shaped boundary. This is a very common problem when one
of the boundaries is formed by surface water. In this situation, the area can be
determined by dividing the shape into a series of trapezoids and summing the
individual areas. In situations where the trapezoids can be laid out so the heights
are the same, the trapezoidal summation equation can be used.

Problem: What is the area (acres) for the field illustrated in Figure 13.16?

500

400ift 375t
1

1

1 1
1 1
1 1
1 1
1 1

400 ft 200 ft 300 ft

FIGURE 13.16. Example of using trapezoids for irregular shape.
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Solution: The total area (At) is the sum of each trapezoidal shape (dashed lines).

a+b
2

X
hlxal_;m)—i—(hzxa2;b2)+<h3xa3;b3>

A=h

e (
x

400ft><500ft—i—400ft n 200ftx400ﬁ+250ft
2 2
+(300ftx 250ft72L375ft)

= (400 x 450) + (200 x 325) + (300 x 312.5)
= 180000 + 65000 + 93750 = 338,750 ft?

lac
Aac) = ————— x 33,8750 ft> = 7.776 or 7.78 ac
43560 ft

The field illustrated in Figure 13.16 contains approximately 7.78 acres. Why is it
approximate? The dashed lines used to define the trapezoidal shapes only approx-
imate the actual boundary lines of the field, Figure 13.17.

When the irregular boundary is uniform enough to allow a series of equal dis-
tances (d) along the base line to be established, the summation trapezoidal equation
can be used. Study Figure 13.16 and the following equation for an illustration of
this method.

ho hn

where A = Area; d = Distance between offsets (must be equal); h, and h, = End
offsets measured from base line AB; > h = Summation of all interior offsets
(excluding the two end offsets).

h h h h

T |
| |
| |

| | h h

| | |

| | |

| | |

| | |

e

FIGURE 13.17. Sketch for summation trapezoidal equation.

A

e
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500 ft

400 ft

275 ft

450 ft | 390 ft
|
|
|
) |
I

390 ft ' 370 ft |
]
]
I
I

I
L 200ft -~ 200ft — 200ft - 200 ft 200 ft - 200 ft -

FIGURE 13.18. Summation trapezoidal equation applied to a field.

To use the summation equation the field length, AB, is divided into a number
of equal distances (d) and the offsets (perpendicular distances from line AB to the
curved edge of the field), h, are measured and recorded.

Problem: Determine the area (ac) of the irregular-shaped field illustrated in
Figure 13.18.

Solution:

ho hn

500 ft 400 ft
= 200 ft x (T + (450 ft + 390 ft + 275 ft + 370 ft + 390 ft) + T)

= 200 ft x (250 ft + 450 ft + 390 ft + 275 ft + 370 ft + 390 ft + 200 ft)
= 200 ft x 2325 ft = 465,000 ft

lac

13560 & x 465,000 ft* = 10.67... or 10.7 ac

A (ac) =

13.11. Metric Problems
Problem: What is the area of a triangle (ha) with a base 150.0 m long and a height
of 100.0 m?

Solution:

1
A= > x 150.0m x 100.0 m = 7,500 m?

1 ha

= 0000 X 7,500 m? = 0.75 ha

ha

Problem: Determine the area (m?) for a triangle having sides measuring 650.0 m,
428.0 m, and 282.0 m.
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Solution:
5 a+b+c 650.0m+428.0m +282.0m
2 2
A = /680.0 (680.0 — 650.0) (680.0 — 428.0) (680.0 — 282.0)
= /680.0(30.0) (252.0) (398.0)

= /2046038400
= 45,233.15598 or 45,230 m?

=680.0m

Problem: Determine the area (m?) of a triangle with sides of 350.0 m and 555.0
m and an included angle of 45°.

Solution:

A:%xaxbx sine@:%x 350.0m x 555.0m x sine 45

194250
= x 0.7071 = 68677.74... or 68,700 m?

Problem: What is the area (m?) of a rectangle measuring 1320.0 m by 660.0 m?
Solution:

A=bxh=13200m x 660.0m = 871,200 m?

Problem: What is the area (ha) of a parallelogram where the base measures
1,050.0 m, and the height measures 750.0 m?

Solution:
1ha 1ha
A(ha) =b xh x ——— =1,050.0m x 750.0mM x ————
10,000 m 10,000 m
787500
= 10000 — 78.75 or 78.8 ha

Problem: Find the area of a circle (m?) having a radius of 75.0 m.
Solution:

A(m?) =7 xr?=3.14... x 75.0* = 17671.45...or 17,700 m?

Problem: Find the area of a sector (m?) having a radius of 135.0 m and an angle
of 60.0°.

Solution:
Ao TX r2x6 314 x (135.0 m)® x 60.0°
360 360
3,433,590
=2 9,537.75 or 9,540 m?
360

Problem: What is the area of a sector (ha) if the radius is 100.0 m and the arc
length is 210.0 m?
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500

375|m

400 m 200 m 300 m

FIGURE 13.19. Metric example of using trapezoids for irregular shape.

Solution:
r x arc length 1ha
A (ha) =
(ha) 2 " 10,000 m?
~100.0m x 210.0 m 8 lha 21,000 21ha
- 2 10,000 m?> ~ 10,000

Problem: What is the area (ha) of a trapezoid with parallel sides of 300.0 m and
450.0 m, and with a height of 120.0 m?

Solution:
A—hx (a+b) y lac :
2 43,560 ft
— 1200 ft x <300.00ft + 450.00ft) o 1ac i
2 43,560 ft
1
= 45,000 2 x ——
43,560 ft

= 1.03305... or1.033 ac

Problem: What is the area (acres) for the field illustrated in Figure 13.19?

Solution: The total area (At) is the sum of each trapezoidal shape (dashed lines).

a+b
2

o (e B ¢ (e 22 (1 )

A=hx
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500 m

I
: .
! |
! |
| ! | 400 m
45c|) m 300 m !
]
: : 275m
I 1 I
I
I

1
L 200m —— 200m —— 200m —— 200m -—

T
1
1
1
|
370 m
1
1
1
1
1

FIGURE 13.20. Summation trapezoidal equation applied to a metric measured field.

_ 400mx500m+400m n 200mx400m—i—250m
2 2
n (SOOm “ 250m-;375m)

— (400 x 450) + (200 x 325)+ (300 x 312.5)

= 180000 + 65000 + 93750 = 338,750 m?
1ha

10.000 m2 x 33,8750 ft* = 33.875 or 33.9 ha

A (ha) =

Problem: Determine the area (ac) of the irregular-shaped field illustrated
Figure 13.20.

Solution:
ho hin
A=d — 4+ Xh+ —
X (2 + + 2)
500 m
=200m x T+(450m+390m+275m+ 370 m + 390 m)
n 400 m
2
=200m x (250 m 4450 m+ 390 m + 275 m + 370 m
+390 m + 200 m)
=200 m x 2325 m = 465, 000 m?
1ha
A (ha) = x 465,000 m? = 46.5 ha

10,000 m2
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Land Description

14.1. Objectives

1. Understand the three common methods of describing land.

2. Beable to use the rectangular system to read and write legal descriptions.

3. Be able to use the rectangular system to determine the number of acres from a
written description.

14.2. Introduction

From earliest times there was a need to mark and describe the boundaries of
parcels of land. It isrecorded that in about 1400 B.C. Egypt devel oped a system to
reestablish land boundaries after each flood. The need to accurately establish and
describe land boundaries has persisted to this day. To transfer ownership one must
be able to describe what land is being considered, and where it is located. In the
United States, a unique description for each parcel of land is required to collect
property taxes. Three primary systems are used in the United States to defineland
boundaries and locations. These are metes and bounds, block and lot, and the
Public Land Survey System (PLSS) commonly called the rectangular systems.

14.3. Metes and Bounds

The metes and bounds system is based on a verbal or written description of the
boundary using land marks visible at the time. The description includes a point of
beginning (POB), such as arock, tree, stake, or post, and lengths and bearings of
successive lines from this point. Lengths may be paces or in units of chains, poles,
or rods. As the technology available for surveying improved, these units were
replaced by feet and inches, decimal feet or metric measurements. The bearings
may be magnetic, true, or grid. True or grid bearings are the preferred type. To
read or write land descriptions with the metes and bounds system, the units used
and the type of bearing used must be known.

196
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A typical description might read as follows: “beginning at the large rock about
2 min walk northly from the creek, thence easterly 100 paces to the red oak tree,
thence southerly 250 paces to alarge partially buried rock, thence westerly to the
creek and follow the creek northly to the point of beginning.” The dilemma that
anyone faces trying to trace the boundaries many years later should be obvious.
Creeks change course, trees are removed, rocks can be dug out or covered when
land leveling.

14.4. Block and Lot

This system isvery common in citieswhere land has been arranged into lots. City
or county recorders offices have plat books giving the location and dimensions
of all the blocks and lots. In most areas, devel opers are required to provide such
plans and have them approved before construction begins. A typical description
might read: “Country Club plat, block 4, lot 23, book 543, page 201.” In addition,
each parcel can beidentified by street number.

14.5. Rectangular System

The PLSS or rectangular system of public land survey is used in 30 states. The
system was adopted in 1785 by the Continental Congress to subdivide new lands
northwest of the Ohio River in alogical and systematic manner. In general, the
system establishes agrid by dividing the land by north and south line that follows
atrue meridian, with a base line that follows a latitude, see Figure 14.1.
Additional lines parallel to the base line, called standard parallels and lines per-
pendicular to the baselines, called guide meridians, are added to form quadrangles
24 miles sgquare. A few of the original PLSS surveys laid out the lines 30 miles
apart. A spacing of 24 miles became the later standard. In this discussion, we will

FIGURE 14.1. Meridians and base
lines.
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FIGURE 14.2. Rectangular system of public surveying.

consider only the 24-mile rectangular surveys. The quadrangles are divided into
townships that are 6 miles square. The townships are further divided into 36 sec-
tions of approximately 640 acres each and each section is still further subdivided
into fractional parts.

Because meridians converge, at the poles, it is mathematically impossible to

have atrue grid. A system of subdivisions was used to adjust for the converging
of the meridians. This is the reason the guide meridians, Figure 14.2, are not
continuous, but have an adjustment at each standard parallel. A description of the
subdivisions follows:

1.
2.

3.

Quadrangles: These square tracts are approximately 24 miles on each side.
Townships: Each quadrangle contains 16 townshi ps, each approximately 6 miles
on aside.

Sections: Each township is divided into 36 sections, each approximately one
mile on aside and containing 640 acres.

. Quarter sections: Each section is divided into quarter sections approximately

one-half mile on a side and containing 160 acres. Quarter sections may be
divided into fractional areas, theindividual tracts containing 80, 40, 20, 10, or 5
acres or combinations of these sizes.

The intent was to produce sections of land one mile to aside. Any variation
because of convergenceis placed in the western column and the top row of each
township.
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To begin an original survey, an initial point was established in each new area
of land by astronomical observations. Thirty seven initial points were eventually
established. A base line, a true parallel of latitude that extends in an east—west
direction, and a principal meridian, a true north—south line, passes through each
initial point. The principal meridian may be designated by name or by number.
The Oklahoma Territory was surveyed from two different meridians, the Indian
Meridian and the Cimarron Meridian. The territory that became the states of
Kansas, Colorado, and Nebraska was also surveyed from the Indian Meridian,
but in these states it was called the 6th Prime Meridian. Figure 14.2 illustrates the
rectangular system.

In Figure 14.2, find theinitial point, base line, and principal meridian. Note that
quadrangles are bounded on the north and the south by true parallels of latitude,
called standard parallels, which are 24 miles apart and are numbered consecutively
north and south of the base line. For example, the First Standard Parallel North is
24 miles north of the base line, and the Fourth Standard Parallel North is 96 miles
north of the base line. The east and west boundaries of quadrangles follow true
meridians but because of the adjustment for convergence they are not continuous,
therefore they are called guide meridians. They are 24 miles apart and are num-
bered consecutively east and west of the principal meridian. Thus, the First Guide
Meridian West is 24 miles west of the principal meridian, and the Third Guide
Meridian East is 72 miles east of the principal meridian.

Because the guide meridians are true meridians, they converge asthey approach
the North Pole and the South Pole. This causes the north side of each quadrangle
to be dlightly less than 24 miles. To adjust for convergence, a closing corner is set
at the intersection of each guide meridian and each standard parallel or base line.
The distance between the closing corner and the standard corner causes an offset
in the meridian.

Townships are bounded on the north and the south by township lines and on the
east and west by range lines. Range lines are true meridians and thus converge.
The south boundary of each township is 6 milesin length, but the north boundary
isslightly less. Closing corners are established for townshipsin the same way that
they are established for quadrangles. Township lines are parallel to the base line
and the standard parallel.

A townshipisidentified by aunique description based upon the principal merid-
ian governing it. A north—south column of townshipsiscalled arange. Ranges are
numbered in consecutive order east and west of the principal meridian. An east—
west row of townships is called a tier. Tiers are numbered in order north and
south of the base line. By common practice, theword “tier” usually is replaced by
“township” or just “T” in designating the rows.

Anindividua township isidentified by its number and direction north or south
of the baseline, followed by the number and direction east or west of the principal
meridian. Thetownship designation usually is abbreviated, asfor example, “T5N,
R3E” of the prime meridian. This township would be located between 24 and 30
miles north and 12 and 18 miles east of the initia point. Figure 14.3 shows a
quadrangle divided into townships and one township divided into sections.
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FIGURE 14.3. Division of quadrangle and township.

Based on the earlier discussion, the township divided into sections in Figure
14.3 would be identified as, T10N, R6E.

Figure 14.4 shows the method of subdividing a township into 36 sections, one
mile sgquare (640 acres). Sections are numbered by starting in the northeast corner
of the township and continuing in a serpentine fashion. If the survey is error free,
whichisextremely improbable, all sectionsare one mile square except those along
thewest and north boundary of the township. These sections arelessthan onemile
in width because of convergence of the range lines and any error in measurements.
Thedescription of thehighlighted sectionin Figure 14.4is" S21,” and thetownship
identifiedin Figure 14.3isT10N, R6W, Principa Meridian (or PM). “ Thecomplete
description would be written as, “S21, T10N, R6W, PM.”

FIGURE 14.4. Section numbersin township.
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FIGURE 14.5. Subdivision of a
section.

As shown in Figure 14.5, each section may be further subdivided into smaller
tracts, with north being to the top of the page and east to the right.

The fractions refer to the fraction of the section subdivision being considered
and only 1/4 and 1/2 are used unless using | ot numbers. The rectangular description
of the section subdivisions begins with the smallest unit of area.

Problem: What are the descriptions of the subdivisions labeled A, B, and C in
Figure 14.5?

Solution:

A = NE /4, S23, T4N, R7E, Principal Meridian.
B = N /2, SE /4, S23, T4N, R7E, Principal Meridian.
C = SW 1/4, SW /4, SW 1/4, S23, T4N, R7E, Principal Meridian.

The description for subdivision A is read as: “the northeast one quarter of
section 23, located in township 4 north and range seven east of the Principal
Meridian.”

Itisnot unusual for afield to be contained in morethat one fraction of asection.
In these situationsa“&” can be used to link the parts.

Problem: What isthe description of the field in Figure 14.6?
Solution: NE1/4, SEL/4, NW1/4 & SW1/4,N, E1/4 see Figure 14.7.

Land descriptions also can be used to determine the acres contained in each
subdivision. To determine the acres, divided the area of a section, 640 acres, by
each of the denominatorsin the fractions.
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FIGURE 14.6. Fractions of asection using 1/2.

FIGURE 14.7. Solution of fractions of section using an &.
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Problem: What is the area (acres) for each of the subdivisions labeled A, B, and
CinFigure 14.5?

Solution: Because a section is nominally 640 acres, the areas are:

A: 640 x % = 160 acres,

=
=

B: 640 x — x — = 80 acres,

C: 640 x = 10 acres.

X

X

AL DN
N

BN e S

14.6. Metric Problems

The PLSSis uniqueto the United States and thereis no comparable system in the
Sl units.
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Differential and Profile Leveling

15.1. Objectives

Be able to describe the equipment used in differential and profile surveying.
Understand the terms used in differential and profile leveling.

Be ableto read a surveying rod.

Be ableto identify and control the common sources of error during leveling.
Be able to describe the processes of differential and profile leveling.

Be able to record a set of notes for differential and profile leveling.

oukwNPE

15.2. Introduction

Leveling is the process of determining the elevation of points on, above or below
the surface of the earth. Many different types of surveys can be used depending
on the desired results. Differential and profile leveling are two surveying methods
that are very useful for agricultural and horticultural projects. They are both useful
for planning and layout of projects. For planning purposesthey are used to provide
the information needed to develop the maps, charts, and drawings necessary to
lay out buildings, roads, drains, etc. They can also be used for layout. Layout
is used to establish the boundaries, lines, and elevation for the construction of
those structures. Differential and profile leveling rank next to the measurement
of distance in importance as a surveying technique. The following chapter will
discuss the terms, equipment, and procedures for two types of leveling.

15.3. Leveling Terms
15.3.1. Bench Mark

A bench mark (BM) is an object whose elevation above mean sea level is known
or assumed to be known. A bench mark must be an object that is dimensionally
stable because it is the reference point for all of the elevations for a survey. If

204
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the bench mark elevation is accidentally changed, all surveys that used it must
be redone. Bench marks allow a survey to be repeated at a later date and permit
a surveyor to tie elevations from the current survey to elevations established in
previous surveys. A network of bench marks can thus be established over alarge
areg, al tied to the same reference elevation. Bench marks may vary in character
and permanency according to the survey for which they were established. TheU.S.
Geological Survey (USGS) has established a nationwide network of bench marks,
all referenced to mean sealevel. These marks consist of bronze disks set in concrete
monuments, similar to right-of-way markers, which have been firmly set in the
ground. The date of the survey and the elevation and bench mark number usually
are stamped in each bronze disk. The adoption of Global Positioning Satellites
(GPS) for surveying has provided another means of establishing benchmarks.

In many situations it is not necessary to know the exact elevation above sea
level. For such surveys, alocal bench mark is used. Frequently, thisbench mark is
given the elevation of 100.00 ft. If theterrainishilly, the surveyor should choose a
larger number for the starting elevation, asit isnot standard practiceto use negative
numbers for elevations in common surveys.

When using a local bench mark, the survey crew must select and establish
its location. Two rules should be followed. The object selected should: (1) be
reasonably permanent for as long as it will be needed, and not easily moved or
otherwise destroyed; and (2) be capable of being described in such a way that it
can be easily relocated. A typical local bench mark might be an “X” chipped in a
concrete curb or abridge abutment, aniron pin driven firmly into the ground, or the
rim of an electrical or sewer access hole. It isthejob of the note keeper to describe
accurately the name, number, type, elevation, and location of each bench mark,
and to record this information on the right-hand page in the surveying notebook.

15.3.2. Backsight

A backsight (BS) isarod reading taken on a point of known or assumed el evation.
Itisthe vertical distance between the line of sight through the instrument and the
point of known or assumed elevation on which the rod is set. When a Philadel phia
or similar typerodisused, thevertical measurement will bein unitsof decimal feet.

The backsight reading is used to establish height of the instrument, see
Figure 15.1. A backsight will always be taken on a bench mark or aturning point.

FIGURE 15.1. Backsight rod reading.
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FIGURE 15.2. Determining instrument
height.

A backsight on a turning point is used to continue a survey beyond the starting
instrument position. The word “backsight” has nothing to do with the direction in
which theinstrument is pointed. It isimportant to remember that thereisonly one
backsight for each setup of the instrument.

15.3.3. Height of Instrument

The height of instrument (HI), also called instrument height (IH), isthe elevation
of the line of sight through the instrument when it is mounted on a tripod and
leveled.

It isfound by adding the backsight rod reading to the elevation of the point on
which the backsight wastaken. In Figure 15.2 the instrument height is 105.1 ft be-
causetheline of sight through theinstrument is5.01 ft higher than the benchmark.

15.3.4. Foresight

A foresight (FS) is a rod reading taken on any point of unknown elevation. In
differential leveling, thereisonly oneforesight for each instrument setup, whereas
profile leveling may have severa foresights per instrument setup.

The FSis subtracted from the HI to find the elevation of an unknown point. In
Figure 15.3, the foresight rod reading, 3.21 ft, is subtracted from the instrument
height, 105.01 ft to determine the elevation at the unknown point, 101.8 ft.

FIGURE 15.3. Foresight rod reading.
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FIGURE 15.4. Turning point.

15.3.5. Turning Point

A turning point (TP) is atemporary bench mark that is used to extend the survey
agreater distance. They are used anytime it is necessary to move the instrument.
Whenever the instrument is moved to a different location, a backsight is taken
on a TP to establish the new instrument height. Turning points are usually used
wherever the starting station and ending stati on can not be seen from oneinstrument
position.

The number of turning points used during a survey is controlled by the max-
imum distance for the instrument, the distance traveled and the variations in the
topography, see Figure 15.4. They should be selected with care and must not be
moved until the survey is complete. The structure used for a turning point should
be dimensionally stable just like a bench mark. A stake, or permanent structure
such as a curb must be used. Do not set the rod on the ground when making a
turning point; doing so could result in a serious error.

15.4. Surveying Equipment

The equipment used in leveling consists of a leveling instrument and a leveling
rod. The most common type of level is called an engineer’s or adumpy level. The
leveling instrument is a telescope containing both vertical and horizontal cross-
hairs and one or more spirit levels (bubblein aliquid-filled tube) to indicate when
the instrument base is horizontal. The entire assembly, consisting of the frame,
telescope and spirit level, can be “leveled” by turning the three or four leveling
screws that hold the frame in position above the tripod head.

Another common level isthe hand level. It usually has a spirit level for holding
it horizontal and one set of cross-hairs. More sophisticated models may also have
stadia hairs and direct reading angle scales.

Thetraditional leveling rod is awooden scale about 1 inch by 2 inchesin cross
section and about 14 ft long, graduated in feet, tenths and hundredths of feet. Rods
measuring in feet and inches, and meters and centimeters are also available. Rods
are used to measure the vertical distance between the line of sight through the
telescope and the object on which the leveling rod is resting.
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15.5. Rocking aRod

A rod isused to measure the vertical distance between the line of sight, established
by theinstrument, and the object on which therod isresting. To providean accurate
reading it must be held in an upright position. Failure to hold the rod in a vertical
position is acommon error in surveying. The easiest way to ensure that therod is
vertical isto use arod level. If arod level is not available, the instrument person
(person on theinstrument) can determineif therod isvertical to theleft or theright
by instructing the rod person to move the rod until it is aligned with the vertical
cross-hair of the instrument. The fore and aft alignment must be controlled by the
rod person. When arod level isnot available, the fore and aft vertical position of
therod can be determined by rocking the rod. When rocking the rod the rod person
slowly rocks the rod forward and backward past center. The instrument person
records the shortest reading. Thisisillustrated in Figure 15.5.

The shortest reading will occur when the rod is vertical. The distance D, will
always be |ess than distance D..

15.6. Reading a Philadelphia Rod

The most common type of rod is known as the Philadelphia type. This rod has
two sections, each approximately 7 ft long that can be extended to give continuous
readings from zero at the base to 13.00 ft at the top. The graduations consist of
black marks painted on a white background. The black graduations are 0.01 ft
thick and are spaced 0.01 ft apart. The size of the graduations allows the rod to
be read to the nearest 0.01 ft, directly for distances up to 250 ft. The tenths of a
foot are indicated by black numerals, and each foot is indicated by a larger rod
numeral. Thefoot interval usually isalsoindicated by asmall rod numeral between
the whole foot marks. Figure 15.6 isread as 7.02 ft.

Whenthesight distanceisgreater than 250 ft, or if therod cannot beread directly
for any reason, the target should be used. The target, Figure 15.7 isaround or oval
disk divided into quadrants, which are alternately red and white. When the rod

FIGURE 15.5. Rocking the rod.
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FIGURE 15.6. Reading a
Philadelphiarod.

cannot be read directly, the instrument person can signal the rod person to raise
and lower thetarget until it isaligned with the horizontal cross-hair. The note taker
can then record the reading from the rod. The target also has a vernier scale that
alows readings to be made to 0.001 ft. The reading for the rod in Figure 15.7 is
5.753 ft.

15.7. Setting up a Surveying Level

Many different typesand variations of levelsare used for surveying. Thefollowing
procedure for setting up an engineer’s level will also work with most other types.
When not in use, the instrument is housed in a case for protection. To be used,
it must be removed from this case and carefully threaded on the tripod head.
Thetripod legs are set about 4 ft apart and pushed firmly into the ground, thereby

FIGURE 15.7. Reading the rod using a
target.
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providing astable basefor theinstrument and hel ping to ensure an accurate survey.
If the tripod is set up with the head nearly horizontal, leveling of the instrument
will be much easier and faster.

Tolevel afour-legged (four leveling screws) instrument, the telescopeislined up
over one pair of leveling screws, and the bubbleis centered. The screws are turned
in opposite directions. The leveling process is expedited when the left thumb rule
is used, the bubble in the level moves in the direction of the left thumb. Then the
telescope is lined up over the other pair of leveling screws and centered again.
The procedure is repeated until the bubble remains centered for any position of
the telescope. The leveling screws should not be over tightened, or they will bind
and put excessive strain on the instrument frame, or Ieft loose, the instrument will
rock and not remain level.

To level athree-legged instrument, the telescopeis aligned over any one of the
three leveling screws. The instrument is leveled with the adjusting screws and the
spirit level. Once leveled, the telescope is should be slowly rotated to check the
accuracy of the leveling.

15.8. Common Sources of Error

The accuracy of leveling can be greatly improved if several common errors are
controlled:

1. Instrument out of adjustment: Anytime that the instrument is “bumped” or
otherwise moved, it must be releveled. It is a good practice to check the leveling
bubble both before and after reading the rod. Note: resetting the level may change
the instrument height. It must be checked, and if different or al or some, of the
measurements will need to be repeated.

2. Rod not plumb: The rod must always be held plumb using arod level, or rocked
back and forth as explained in the section on reading the rod. A good method of
plumbing the rod is to stand behind the rod and balance it carefully on the stake
by holding your hands lightly on each side.

3. Parallax: If the cross-hairs appear to move over the object as the eye is shifted
dlightly, parallax exists. When parallax exists, the line of sight of the eye may not
be parallel to the line of sight of the instrument. This source of error is eliminated
by adjusting the eyepiece until the cross-hairsarethe darkest. Becausethe eyepiece
will need to be adjusted for each person, standard practice is for just one person
taking al the readings.

4. Sights not equal: When field conditions permit, the distance of backsights and
foresights should be as nearly equal as possible. Thus, any errors due to the in-
strument’s being out of adjustment are minimized because they tend to cancel
out.

5. Reading the rod incorrectly: The person reading the rod must be very care-
ful to ensure that the correct foot mark is used, and that the target is used
correctly.
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15.9. Recording Field Notes

Engineers and surveyors have devel oped a standard practice for recording survey-
ing information because it is important that the notes be clear, complete and easy
to read. Professional surveyors use electronic instruments when every possible.
These instruments record the data and down load it to a data collector or computer
for post processing and/or use. On electronic instruments the manufacturers of the
equipment establish the process and form for collecting and recording the data.

For small projects and when mechanical equipment is used, the traditional field
book isstill used. Thefield book isdivided into right- and |eft-hand pages. Theleft-
hand page contains thetitle, the location, and the data. The right-hand page of the
notesis used to record information about the weather, survey party, equipment and
describe the location of the bench marks, turning points, creeks, fence or property
lines, or other conditions that might influence the design of the structure for which
the survey is being made. The location of the benchmark, or starting point, isalso
described in the notes. A sketch of the general area, showing the location of the
beginning and ending stations of the survey, bench marks, ditches, roads, and other
landmarks, also is helpful, Figure 15.8.

FIGURE 15.8. Standard from for field notes.
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Good surveying practices dictate that the data be checked if at all possible. In
differential leveling, the accuracy is checked by “closing the loop.” Closing the
loop, or just closure, means surveying or measuring back to the beginning. When
completing a differentia leveling activity, surveying from BM2 to BM1 should
find the same difference in elevation as the first leg of the survey from BM1 to
BM2. Thisisrarely the case, however, because some errors are always present in
leveling. The amount by which the original BM 1 elevation and the BM 1 elevation
calculated from loop closing fail to agreeis called the error of closure. Theclosing
of the survey is conducted following the same procedure as the first leg of the
survey. The instrument is picked up and moved, leveled and a backsight is taken
on BM2. The survey is completed using the necessary foresights and backsights
to survey back to BM 1.

15.10. Differential Leveling

Differential leveling is the process of finding the difference in elevation between
two or more points. When the two points are within the sight limits of the in-
strument, two readings are taken. The difference in rod readings represents the
difference in elevation between the two points. When one or more of the points
are beyond the range of the instrument turning points are used.

One of the most common applications of differential leveling isto run acircuit
of sights to determine the elevations of one or more bench marks relative to a
previously established bench mark. The procedure for differential leveling will be
described using this type of circuit, illustrated schematically in Figure 15.9. The
diagram shows that three instrument setups were made in traveling from BM1 to
BM2. Also note that a“ return check” was made between BM2 and BM 1, and that
three more setups were made in this phase of the survey.

The survey begins with the instrument person going forward a convenient dis-
tance (not exceeding thelimits of theinstrument) and setting up thelevel, following
the procedure previously described. The instrument person sights on the rod while
itisheld on thetop of BM 1 by therod person, and notes acenter cross-hair reading
of 3.03 ft. Thisis the backsight, so the 3.03 ft rod reading is added to the BM1
elevation (assumed 100.00 ft), resulting in a height of instrument (HI) of 103.03
ft. The rod person then moves forward past the instrument and selects a turning
point, TP1. The FSrod reading of this TP1 is 3.86 ft. The foresight is subtracted
from the HI, and the elevation of TP1 isfound to be 99.17 ft. The instrument can
now be moved forward and set up at a new position. A backsight rod reading of
2.60 ft is observed on TP1 and added to the TP1 elevation of 99.17 ft, giving an
instrument height of 101.77 ft. Again anew turning point, TP2, is selected, and a
FS rod reading of 4.53 ft is recorded. This rod reading is subtracted from the Hl
of 101.77 ft, giving the elevation of 97.24 ft for TP2. This process is repeated a
third time, and the elevation of BM2 is found to be 95.30 ft. We now know that
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FIGURE 15.9. Differentia leveling.

the difference in elevation between BM1 and BM2 is 100.00 ft minus 95.30 ft,
or 4.7 ft, assuming no errors were made.
In summary, the procedure for differential leveling is as follows:

. Set up the instrument.

. Takethe BSreading on BM 1.

. Establish the TP, and take the FS reading.

. Move the instrument, and set up again.

. Takethe BSon the TP,

. Establish the next TR, and take the FS reading.

. Movetheinstrument, and set up again.

. Repeat steps 5to 7 until aforesight istaken on the last station.

O~NO O WDN PR

The data for the differential leveling survey in Figure 15.9 are recorded in the
datatable, Table 15.1. The left-hand page of a standard surveying field notebook
contains five columns. These columns are needed for the column headings of
station (STA), backsight (BS), height of instrument (HI), foresight (FS), and ele-
vation (ELEV). Additional columns may be added as needed to record additional
information, for example, the distance for each sight.
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TasLE 15.1. Datafor differential leveling example.

STA BS HI FS ELEV

BM1 3.03 100.00
103.03

TP1 2.60 3.86 99.17
101.77

TP2 4.22 4.53 97.24
101.46

BM2 6.43 6.16 95.30
101.73

TP3 3.85 4.44 97.29
101.14

TP4 511 2.96 98.18
103.29

BM1 3.30 99.99

15.10.1. Error Control

In surveying, it isimportant to control as many errors as possible. For differential
leveling surveysthreeerror checks should be completed: closetheloop, note check,
and calculation of the allowable error of closure. The survey is closed to provide
the information for the other two checks. The note check is conducted to catch
any mathematical errorsin the notes. For checking notes, the absolute value of the
sum of the foresights minusthe absol ute val ue of the sum of the backsights, should
equal the absolute value of the difference (A) in elevation for BM 1 (beginning and

closure elevation). Expressed mathematically:

|ZFS— ¥BS| = |A Elevation BM1| .

Problem: Arethefield notesin Table 15.1 accurate?

Solution:

|ZFS— £BS| = |A Elevation BM1|

¥BS

3.86
453
6.16
4.44
2.96
3.30

25.25

XFS

3.03
2.60
4.22
6.43
3.85
511

25.24

|25.25 — 25.24/ = |100.00 — 99.99)
0.01 = 0.01.
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The note check equation is true, this means the 0.01 ft difference in the elevation
of BM1isnot caused by amath error in the datatable. An error that is discovered
after thefact cannot be corrected; therefore the next step isto determineif theerror
is acceptable.

Thethird check isfor the error of closure. The allowable error of closure proce-
dure was established because surveyors realized that it was impossible to survey
without some error. When perfection is not possible, limits of acceptability must
be established. The equation for allowable error of closure sets the acceptability
limits for surveys.

AE = Kv/M

where AE isthe alowable error, K isa constant ranging from 0.01 to 1.0, and M
isthe distance traveled (mi).

The constant K is determined by the level of survey. A high order survey, one
with very little allowable error, would use a K value of 0.01. A very low order
survey, one where more error is acceptable, might usea K value of 1.0. The order
of survey must be established before the survey is started because it will determine
the quality of the equipment and the procedures that must be followed to collect
the data. A K value of 0.10 or 0.05 is acceptable for most general construction
and agricultural surveys.

Problem: Is the closure error of 0.01 ft for the differential leveling survey in
Figure 15.9 acceptable if the total distanced surveyed, out and back, was 3,600 ft
and a K value of 0.10 is acceptable?

Solution:

™~
AE = K+/M = 0.10 x \/3,600 ft x 528r?)lft — 0.10 x ~/0.6818. .. = 0.08.

0.01 < 0.08 The closure error is acceptable.

15.11. Profile Leveling

Profile leveling is used to establish changes in elevation along a line. Common
lines requiring surveying are drains, roads, fences, and retaining walls. When this
information is plotted on a graph, it will give a profile of the line and will enable
one to establish grades, find high or low spots, and make estimates of depths of
cutsand many other decisions. Thefollowing sectionswill illustrate the procedure
for profile leveling and the preferred way to record the data.

Before a profile can be made, the surveying crew establishes the stations by
setting a stake or flag where the rod readings are to be taken. When the terrain is
uniform, the stakes can be set a fixed distance apart (25, 50, or 100 ft). When the
terrain isnot uniform, or when there are addition stations that need to be recorded,
such as asidewalk, the survey crew reconnoiters the line and establishes a station
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TABLE 15.2. Datafor profile leveling.

STA BS HI FS ELEV
BM1 6.02 106.02 100.00
0.00 7.34 98.68
100 5.76 100.26
225 367 102.35
290 1.72 107.40 (0.34) 105.68
340 4.03 103.37
400 6.65 100.75
460 4.00 107.28 (4.12) 103.28
P2 334 105.27 (5.35) 101.93
BM1 (5.25) 100.02
¥BS 1508 XFS 15.06

|SFS— £BS| = 0.02
| AElevation| = 100.02 — 100.00 = 0.02

0.02 = 0.02 Notes check

Acceptable error = 0.10 {EQ\r(920 = 5280)} = 0.04
0.02 < 0.04 Closure error acceptable

at each important point. Because the purpose of the profile is to show the true
slope of the ground, theirregularity of theterrain will largely determine where the
stations should be established. When there is a definite change in the slope of the
ground, the crew should set a stake to determine the elevation, even if it does not
fall at auniform distance.

The major difference between profile and differential surveying is the addition
of additional foresights that are used to define the profile of the terrain. These
additional foresights are called intermediate foresights and they are treated differ-
ently during the error checks on the notes. Table 15.2 shows that a common way
to record the intermediate foresights is to identity the true foresights with paren-
thesis. An additional method is to add a column to the table for the intermediate
foresights.

Once the centerline of the ditch, terrace outlet, channel, road, or other line
to be profiled is established, the distance from the starting point to each sta-
tion is accurately measured. For higher level surveys, 2 x 2-inch stakes may
be driven flush with the ground surface, and rod readings taken on the tops of
the stakes. On less important surveys, the foresights may be taken with the rod
set directly on the ground. Next, the level is set up, readings are taken, and el-
evations are established for each staked point along the line. Turning points are
used as needed to complete the survey. Finaly, a closing circuit of readings must
be made to check the accuracy of the survey. This is done by running a line of
differential levels back to the bench mark where the survey began. If no turning
points are used, a sight is taken at the benchmark used to establish the height
of instrument, and compared with the original backsight. Figure 15.10 illustrates
the steps for conducting a profile leveling survey. The data for this survey isin
Table 15.2.
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FIGURE 15.10. Profile example.

Withthelevel set up near thelineto be profiled, therodisheld on the bench mark,
and areading of 6.02 ft is recorded. This establishes the height of the instrument
as 106.02 ft (100.00 + 6.02). Next the rod is held at stations 000, 100, 225, and
290, where rod readings of 7.34, 5.76, 3.67, and 0.34 ft are recorded. At station
290 a stake is set flush with the surface so it can be used to record the elevation
and also be used as a turning point. The elevation of each point is calculated by
subtracting the rod reading from the height of instrument. Notice that the same HI
isused for all stations up to and including 290, as al readings are made from the
same instrument setup.

Because the surveying crew anticipated in advance the need for aturning point,
theprofileleveling exerciseiscontinued by moving theinstrument to anew location
to provide aview of the remaining stations. A backsight of 1.72 ft is observed on
station 290, establishing the new height of instrument as 107.40 ft. The survey
continues by recording the rod readings for stations 340, 400, and 460. These
readings are 4.03, 6.65, and 4.12 ft.

The profile leveling survey is completed by closing the circuit. The instrument
is moved, and a backsight of 4.00 ft is observed on station 460. A stake is set at
TP2, and aforesight of 5.35 ft is observed. The procedure is repeated to complete
the survey from TP2 to BM 1.

Table 15.2 contains a set of notes for this survey. Note the similarities and
differences between these notes and Table 15.1 (data for differential leveling). At
the completion of the survey, it is noted that an error of 0.02 ft has accumulated
during the survey.
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15.11.1. Error Control

Because profile leveling notes usually have more foresights than backsights, the
method of checking for arithmetic mistakes is dightly different from that for
differential leveling. The only foresights to be included when calculating the sum
of the foresights (X FS) are those taken on turning points, including bench marks
if they were used as TPs. In the sample notes, Table 15.2, the foresight readings
that are to be used for checking are shown in parentheses. The datain Table 15.2
indicate there were no arithmetic errors in the survey, and the closure error was
acceptable. Note: This procedure provides acheck on the turning points only—not
the intermediate foresights. Any errors in the rod readings for the intermediate
foresights will not be detected using the standard checks for error. Additional
methods such as multiple reading or plunging the tel escope must be used. Extreme
care must be used to prevent mistakes in reading and recording the rod readings
and in calculating the elevations at all stations.

15.12. Using Profile Data

The results of profile leveling surveys are most useful when they are plotted in a
graph. The principal purposes for plotting a profile are: (1) to aid in the selection
of the most economical grade, location, and depth of irrigation canals, drainage
ditches, draintilelines, sewer lines, roads, etc.; and (2) to determine the amount of
cut or fill required for these installations. The graph is plotted with the elevation
on the ordinate (vertical scale) and the stations on the abscissa (horizontal scale).

The use of computer spreadsheets makes it much easier to plot and complete
“What if?" examples using surveying data.

Problem: What will be the maximum depth of cut for the data in Table 15.2 to
install adrain at 2.0 ft below the elevation of station 0.0 and with aslope of 0.5 %7?

Solution: This problem could be answered by calculating the difference in eleva
tion between each station and the proposed drain, but that would require acalcula-
tion for almost every station. Plotting the datawill provide the visual information
to determine where the greatest depth will be, Figure 15.11.

The plot shows that the maximum elevation of the profileis 105.7 ft and at that
station the elevation of the drain will be at 98.20 ft.

105.7 ft — 98.20 ft = 7.5 ft.

The maximum depth of cut to install the drainis 7.5 ft.
The problem could also be solved by calculating the difference in elevation
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FIGURE 15.11. Profile plot of example data with drain.

between the profile and the drain for each station surveyed using the equation:
Elevationgrain = Elevationgating + (Station distance x Slope) .

With adope for the drain of 0.5%, for station 290 in the sample data the elevation
of thedrainis

Elevationgin = Elevationgating + (Station distance x Slope)
= 96.7 ft + (290 ft x 0.005)
= 96.7 ft+ 1.45ft
= 99.150r 98.2 ft.

The elevation of the profile at station 290 (105.7 ft) minus the elevation of the
drain at station 290 (98.2 ft) leaves a depth of cut of 105.7 — 98.2 or 7.5 ft.

15.13. Metric Problems

The procedures and techniques for completing differential and profile surveys
using metric equipment are the same. The only difference is that a metric rod
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would be used and the allowable error of closure equation is modified for metric
use. A common error of closure equation for metric differential and profile surveys
is:

AE = KV M,

where AE isthe allowable error of closure, K isaconstant, 3-6 mm, and M isthe
distance surveyed, in kilometers.
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Weather

16.1. Objectives

1. Understand the differences between high pressure and low pressure areas and
their effect on the weather.

. Be able to identify the five common air masses.

. Understand the hydrologic cycle.

. Be able to define rainfall intensity, duration, and recurrence interval.

. Be able to determine rainfall intensity when given the duration and return
interval.

a b~ wpN

16.2. Introduction

The weather is the largest uncontrolled variable, as well as the most unpredictable
variable, in the production of agricultural products. Agricultural production is
based on the growth of plants, and those plants require an optimum environment
for maximum production. However, maximum production is seldom realized in
the natural environment because the weather seldom matches the needs of plants.
Whenever the real environment is significantly different from the optimum, plants
are stressed, and production is reduced. The major limiting factor is water. An
understanding of the mechanisms of the weather will improve the decision-making
process for activities such as cutting hay, irrigating, harvesting, and tillage. Better
decisions mean increased productivity for any agricultural enterprise. This chapter
will discuss the pressure systems that influence the weather, the hydrologic cycle,
and a few of the characteristics of rainfall and runoff.

16.3. Areas of High and Low Pressure

Weather is greatly influenced by atmospheric pressure systems. High pressure
and low pressure centers are indicators of the type of weather to be expected.
Winds blow in a counterclockwise direction around a low pressure center and in a
clockwise direction around a high pressure center. Closely spaced systems indicate

221
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a steep pressure gradient and high wind speeds; when the systems are farther apart,
the wind speeds are lower. A trough line may develop between two low pressure
areas, and a ridgeline may develop between two high pressure areas. In general,
cloudy or rainy weather is associated with a low pressure center, and clear, sunny
weather accompanies areas of high pressure.

16.4. Air Masses

Differences in pressure are caused by air masses moving across the country. An
air mass is a large body of air that has a more or less uniform temperature and
moisture content throughout the mass. Air masses that have been over water for a
period of time may contain large amounts of moisture, whereas those originating
over land areas are usually dry.

The weather in the United States is influenced by five air masses, Figure 16.1.
The following section lists and briefly describes these air masses.

FIGURE 16.1. North American air masses.
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1. Tropical maritime (mT): This air mass forms off the Gulf of Mexico where it
is subject to tremendous heating by the sun. This heating causes evaporation from
the ocean, resulting in a warm, moist air mass. This mass generally moves north
and west into the central region of the country. This mass contributes the largest
amount of moisture to the central and eastern regions of the United States. Tropical
maritime air masses also form seasonally of the southern coast of California.

2. Tropical continental (cT): The tropical continental forms over the Mexican
countryside. The cT is subject to tremendous heating by the sun; but because it
forms over land, it is dry. It tends to move north into the central plains. Whena cT
moves into a region dominated by a mT, a dry line can develop at the boundary
line between the two air masses. This condition is famous for the development of
severe thunderstorms.

3. Polar maritime (mP): This air mass forms over the polar regions of the Pacific
and Atlantic Oceans. They are very cool and usually saturated. Consequently any
additional cooling can produce precipitation. They are notorious for producing fog,
drizzle, cloudy weather and long lasting, light to moderate rain. The Pacific mP
occurs more frequently and tends to move south and east into the central plains. As
it is forced up over the Rocky Mountains it loses most of its moisture and takes on
the characteristics of a continual air mass. The Atlantic mP occurs less frequently
and tends to follow the east coast.

4. Polar continental (cP): This mass forms over the central plains of Canada. This
area of Canada has long winter nights and a large amount of radiation cooling
resulting in a very cold, dry air mass. This air mass also tends to move very slowly,
and consequently usually is very cold. Consequently this air mass does not produce
very much precipitation. The exception is along the boundary line between the cP
and a mT. In this situation the rapid cooling of the mT caused by the cP can
product localized intense thunderstorms. Its normal movement is south into the
Great Plains.

5. Superior (S): The superior air mass is unique because it forms at high altitudes
over the southwestern desert and occasionally descends to the surface. It is usually
very hot and dry.

16.5. Storms

Storms are the result of conflict between warm air masses and cold air masses.
The zone of contact between the contrasting air masses is called a front. Fronts are
classified as cold fronts or warm fronts depending on which air mass is dominant.
When the cold air mass is dominant, the change occurs quickly because cold air
masses usually move rapidly. Cold air is heavier than warm air; therefore, the warm
air is forced upward, as shown in the cross section in Figure 16.2.

As it rises, warm air cools rapidly. Extreme turbulence and heavy rainfall may
occur over small areas. From a soil and water conservation standpoint, cold fronts
may cause local rainstorms of high intensity that may result in serious soil erosion
and local flooding.
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FIGURE 16.2. Cross section of a cold front.

A cross-sectional view of a warm front is shown in Figure 16.3. A warm front
occurs when the warm air mass is dominant and overtakes cooler air. The rate
of cooling is much less than for a cold front, and resulting rains are gentler. The
rains usually cover very large areas. Thus the potential for erosion is reduced,
but the rains may cause widespread flooding if they persist for a long period of
time.

16.6. Hydrologic Cycle

Climatological concerns involve more than the effects of pressure and air masses
on the weather. The conservation of soil and water is based on an understanding
of the hydrologic cycle. Figure 16.4 illustrates the movement of water in, on, and
above the earth.

The earth is a closed system in which all of the water circulates from one form
to another. A study of the cycle can begin at any point, but we will start with
precipitation.

Precipitation is caused by the condensation of water vapor in the atmosphere.
Water vapor collects in the atmosphere as the sun evaporates water from the oceans,
rivers, lakes, and plants. It falls to earth in the form of rain, hail, or snow, or
forms on the surfaces of objects as dew or frost. Not all precipitation reaches
the earth’s surface; some evaporates as it falls, some reaches the surface but does
not move through the cycle because it is held in the form of snow and ice and
some is intercepted by plants. The moisture stored as snow and ice may be stored
for a long period of time in glaciers and the polar ice caps. Precipitation fol-
lows different paths before it eventually returns to the atmosphere in the form of
vapor.

A portion of the precipitation will infiltrate the soil. It is not unusual for the
infiltration rate (inches/hour) of the soil to be less than the rainfall intensity
(inches/hour). When this occurs, the excessive precipitation becomes runoff, which
is one of two causes of erosion. Not all runoff reaches the ocean; some evaporates,
some is collected in different size impoundments and then infiltrates into the soil,

FIGURE 16.3. Cross section of a warm front.



Hydrologic Cycle 225

FIGURE 16.4. Hydrologic cycle.

and some is used by vegetation. The water used by vegetation may be evaporated
quickly or may become part of the plant processes. Water can be tied up in plants
for extended periods, but it eventually returns to the cycle.

The precipitation that infiltrates into the soil also takes different paths. Some
may fall on areas of deep soil and percolate deeply into the earth. Other infiltration
may reach an impervious layer close to the surface and start to move horizontally
quickly. The underground horizontal movement may end at some type of surface
water, or may flow out of the ground as a spring or an artesian well. The water that
infiltrates deeper into the soil may collect in large underground basins such the
Ogallala aquifer, and may be pumped out of the ground for domestic, industrial,
or agricultural use, or it eventually may reach the ocean. Horizontal movement
through the soil may be as little as a few inches per year. Once the water reaches
the ocean, the sun causes it to evaporate, and the cycle begins again.

The hydrologic cycle can be used to explain the importance of water conserva-
tion. Activities such as pumping, dam building, and so on, change the amount and
direction of the flow of water. For example, any water captured by a dam, not only
reduces the amount of water available to down stream users, it also changes the
amount of water that infiltrates into the soil and evaporates into the atmosphere.
Contamination, in the form of chemicals, silt, and so forth, added to the water at
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one point in the cycle may remain in the water and cause problems for the next
user.

16.7. Rainfall Intensity, Duration, and Recurrence

Engineers, conservationists, ecologists, and agricultural producers are interested in
rainfall because of its impact on erosion, floods, and water available for crops. There
are four important characteristics of rainfall; intensity, duration, total amount, and
recurrence interval (for storms). These are all discussed in the following sections.

16.7.1. Intensity

Rainfall intensity is the rate of rainfall. It is usually expressed in units of inches
per hour or millimeters per hour. The intensity is an important characteristic of
rainfall because, other things being equal, more erosion is caused by one rainstorm
of high intensity than by several storms of low intensity. A high intensity storm
will have a greater volume of runoff than a low intensity storm.

16.7.2. Duration

Duration is the period of time that rain falls at a constant rate or intensity. It does
not mean the total time, from beginning to end, of rainfall. During any rain fall
event (storm) the rainfall intensity will not be constant. It may vary from quite
high to very low; so it is necessary to think in terms of how long a specific rainfall
intensity lasts (min or hr) at a certain rate (in/min or mL/min). The example of the
rainfall intensity-duration for a rainfall event in Figure 16.5 has eight (8) different
durations during a rainfall event that lasted for 94 min. The total amount of rain

FIGURE 16.5. Example of intensity-duration for a rainfall event.
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FIGURE 16.6. Typical rainfall
intensity—duration curve.

Rainfall intensity (in/hr}

Rainfall duration (hr)

(inches or millimeters) for a rainfall event is the sum of each rainfall intensity
times the duration of that intensity.

The average rainfall intensity for a storm is between the highest and the lowest
rainfall intensity. As a general rule, the high-intensity portion of a storm has a
shorter duration than the low-intensity portions. A typical relationship between
rainfall intensity and duration is illustrated in Figure 16.6.

16.7.3. Recurrence Interval

Another important aspect of rain is how often a storm of a specified intensity
and duration may be expected to occur. The recurrence interval is defined as the
number of years (on the average) before a storm of a given intensity and duration
can be expected to recur. A storm that would be expected on an average of once in
25 years is said to have a 25-year recurrence interval, or is called a 25-year storm. It
is important to remember that this is all based on the laws of probability, or chance,
and that these estimates are based on averages only. There is nothing to prevent a
25-year storm from happening in two successive years, or even more than twice
in one year, although the odds against such frequent occurrence are great.

The National Weather Service has studied the rainfall records of major storms for
many years. The results of these studies have been published in the form of Rainfall
Intensity Recurrence Interval Charts. Such a chart would look like Figure 16.7.

Thus, a storm is considered to have a recurrence interval of 2, 5, 10, 25, 50, or
100 year, or longer, depending on the average number of years expected to pass
before a storm of similar intensity and duration occurs again. For a given duration
we would expect the intensity of a 100-year recurrence interval storm to be greater
than that of a 10-year storm. A curve can be plotted showing the relationship
between rainfall intensity and the expected duration for each recurrence interval.

16.7.4. Intensity—Duration—Recurrence Interval

Figure 16.8 shows typical intensity-duration-recurrence interval curves for a spe-
cific location. The lines in the chart represent the recurrence intervals of 2, 5, 10,
25, 50, and 100 years.
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FIGURE 16.7. Typical rainfall
intensity—duration—-recurrence
interval curves.
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Note that both axes in the graph are logarithmic scales and must be carefully
read. The time in the left half of the graph is in minutes. The time in the right half of
the graph is in hours. To design water conservation structures, a graph appropriate
for the area under study should be used.
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FIGURE 16.8. Example of rainfall intensity—duration—recurrence interval.
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Problem: What is the expected rainfall intensity for a duration of 40 min and a
10 year recurrence interval.

Solution: Enter the table at 40 min along the horizontal axis. Move vertically
until intersecting with the ten year curve. Move horizontally to the left until in-
tersecting with the rainfall intensity axis. Read the rainfall intensity = 3.5 in/hr,
Figure 16.9.

16.8. Metric Problems

The hydraulic cycle is same regardless of the units being used. The only differ-
ence is in the units used to measure rainfall. The rainfall-intensity-duration graph
included in this section with SI units looks different because it is not a logarithmic
graph, Figure 16.10.

Problem: Determine the rainfall intensity for a 5 year storm and duration of 20 min
using Sl units
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FIGURE 16.9. Rainfall intensity for sample problem.
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Solution: Enter Figure 16.11 along the horizontal axis at the 20 min mark and
move vertically to the 5 year storm curve and then move horizontally left to the
rainfall intensity scale. Read rainfall intensity = 72 mm/hr.

Problem: What is the expected recurrence interval for a storm with a duration of
28 min and an intensity of 70 mm/min?

Solution: Move upward from 28 min duration and to the right from 70 mm/hr,
Figure 16.12. At the point were they converge read 10-year interval.



233

Metric Problems

‘wiajqoad ajdwies 10} [eAIsIUI 82UBLIND208Y “ZT 9T IdNDIH



17
Water Runoff

17.1. Objectives

1. Be ableto discuss the watershed characteristics that influence water runoff

2. Be able to use the Rational method for determining peak runoff rates

3. Beableto utilize arainfall intensity-duration-reoccurrence interval graph

4. Given the characteristics of a mixed watershed, be able to determine the peak
runoff rate for a specified storm.

17.2. Introduction

In the previous chapter it was determined that runoff occurs whenever the rainfall
intensity exceeds the infiltration rate. In many situationsit is important to be able
to determine the volume of water that will run off an area and/or the maximum
rate of runoff. The volume of runoff is used to size drainage structures and water
impoundments. One of the uses of the peak rate isto size drainage ways, culverts,
and bridges. The peak rate can be easily visualized if the flow rateis plotted in the
form of a hydrograph. A hydrograph plots the runoff rate for a watershed versus
time. A watershed is a drainage basin where all of the water that runs off passes
through one point, Figure 17.1.

This point may be the outlet into another stream or an impoundment like a pond
or lake.

Figure 17.2 isatypical hydrograph and it showsthat runoff gradually increases
to apeak rate and then drops off after the rainfall stops and the watershed drains.
Flow rates in streams are generally measured in units of cubic feet per second
(cfs) or cubic meters per second (cms). This chapter will discuss the Rational
method, which is one method that is used to calculate the peak rate of runoff for
areas less than 20 acres.

17.3. Peak Rate of Runoff

Therate of runoff is not constant for any rainfall event. Depending on the charac-
teristics of the watershed there will be some delay from the start of the rain until

234
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FIGURE 17.1. Model of watershed.

runoff starts to occur. Once runoff occurs each watershed will have a different
time lapse until the peak rate occurs. The effect of these differences can be seen
by evaluating the hydrograph for each watershed.

The shape of the curve will be different for each rainfall event and for each
watershed. For example, if therainfall event has alonger duration, the hydrograph
could look more like Figure 17.3.

FIGURE 17.2. Typical runoff hydrograph.
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FIGURE 17.3. Typical hydrograph
with longer duration.

17.4. Rational Method of Calculating Peak Rate of Runoff

The Rational method is one of the oldest methods of calculating the peak rate
of runoff. The Rational method is considered ssimplistic, but it is still useful for
small watersheds and using it explores the primary factors that affect runoff. The
confidence in the output decreases as the watershed size and variability increases.
For small areas that are relatively uniform, the Rational method will produce
acceptable results for most needs. The Rational method equationis:

Q =CIA

where Q = Peak rate of runoff (ft3/sec); C = Runoff coefficient; | = Rainfall
intensity (in/hr); A = Drainage area, watershed (ac).

Theaccuracy of thisequation asapredictor of the peak runoff rateisonly asgood
asthe accuracy of the numbers used for each of the variables. The following tables
contain generalized values and should be used only as examples. When the calcu-
lations are critical, the actual values for a particular watershed should be obtained
from the National Resource Conservation Service or the appropriate Web site.

17.4.1. Runoff Coefficient (C)

The runoff coefficient (C) is defined as the ratio of the peak runoff rate to the
rainfall intensity. The runoff coefficient mathematically indicates for a watershed
whether the runoff islikely to be high or low. The value of C depends on the type
and characteristics of the watershed. If the watershed is composed of very tight
soil, steep slopes, or cultivated land (or all three of these), the runoff rate will be
high. If the soil is sandy, with flat slopes, and covered with good vegetation, the
runoff will be low.

The runoff coefficient for watersheds with various topographic, soil, and cover
conditions can be estimated by using the values given in Table 17.1.

17.4.2. Rainfall Intensity (I)

The rainfall intensity used in the rational method is based on a specific rainfall
duration and recurrenceinterval. Therecurrence used dependsontheimportance of
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TABLE 17.1. Table of runoff coefficients (C).

Soil texture
Topography, vegetation and slope Sandy loam Clay and silt loam Tight clay
Woodland
Flat 0-5% 0.10 0.30 0.40
Rolling 5-10% 0.25 0.35 0.50
Hilly 10-30% 0.30 0.50 0.60
Pasture
Flat 0-5% 0.10 0.30 0.40
Rolling 5-10% 0.16 0.36 0.55
Hilly 10-30% 0.22 0.42 0.60
Cultivated
Flat 0-5% 0.30 0.50 0.60
Rolling 5-10% 0.40 0.60 0.70
Hilly 10-30% 0.52 0.72 0.82

the project. Terracesand waterwaysare designed for a 10-year recurrence, whereas
spillwaysfor damsmay requireadesign based on arecurrenceinterval of 100 years
or more. The duration of rainfall used in the rational method is determined by the
time of concentration of the watershed.

17.4.3. Time of Concentration

Thetime of concentration for awatershed is defined asthe time required for water
to flow from the most remote point of the watershed to the outlet. The peak rate
will occur when the entire watershed contributes to the runoff.

The peak runoff flow is influenced by many factors. For the purposes of this
text, the only factors that will be considered are slope and length of the drainage
way. Obvioudly, if the drainage way is short and steep, the water will arrive at
the outlet quickly and the time of concentration will be short. A flat drainage way
gradient has the opposite effect. The time of concentration for small watersheds
with various lengths and drainage way gradientsis shown in Table 17.2.

TABLE 17.2. Time of concentration for small watersheds (min).

Drainage way gradient (slope), %

Maximum length of flow (ft) 0.05 0.10 0.50 1.00 2.00 5.00
500 18 13 7 6 4 3
1,000 30 23 11 9 7 5
2,000 51 39 20 16 12 9
4,000 86 66 33 27 21 15
6,000 119 91 46 37 29 20
8,000 149 114 57 47 36 25

10,000 175 134 67 55 42 30
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The Rational method equation has three variables, C, |, and A. A value must
be determined for each one before the equation can be used. The value of C
is determined using Table 17.1. The value of | is more complex. To determine
I the rainfall intensity—duration—recurrence interval, Figure 16.10, is used. To
find rainfal intensity from this graph the duration and recurrence interval must
be known. In the Rational method the duration is determined from the time of
concentration. The time of concentration is the amount of time that occurs from
when the rainfall starts until the peak rate or runoff occurs, Figure 17.4.

Once the time of concentration is determine from Table 17.1, and the desired
recurrence interval is known, Figure 16.10 can be used to determine the rainfall
intensity.

Problem: Determine the peak runoff for a watershed consisting of 90.0 acres of
pasturewith tight clay soil and an average slope of 4.0%. The drainage way for the
watershed isapproximately 4,000 ft with agradient of 0.50%. Assumearecurrence
interval of 10 years.

TABLE 17.3. “C” value for sample problem.

Soil texture
Topography, vegetation and slope Sandy loam Clay and silt loam Tight clay
Woodland
Flat 0-5% 0.10 0.30 0.40
Rolling 5-10% 0.25 0.35 0.50
Hilly 10-30% 0.30 0.50 0.60
Pasture
Flat 0-5% 0.10 0.30
Rolling 5-10% 0.16 0.36 0.55
Hilly 10-30% 0.22 0.42 0.60
Cultivated
Flat 0-5% 0.30 0.50 0.60
Rolling 5-10% 0.40 0.60 0.70
Hilly 10-30% 0.52 0.72 0.82

The correct value for “C” is 0.40.



Rational Method of Calculating Peak Rate of Runoff 239

TABLE 17.4. Time of concentration for sample problem.

Drainage way gradient (slope), %

Maximum length of flow (ft) 0.05 0.10 0.50 1.00 2.00 5.00

500 18 13 7 6 4 3

1,000 30 23 1n 9 7 5

2,000 51 39 20 16 12 9

4,000 86 66 27 21 15

6,000 119 o1 46 37 29 20

8,000 149 114 57 47 36 25

10,000 175 134 67 55 42 30

The time of concentration is 33 min.

Solution: To determine the solution a value must be determined for each on
the three variables in the rational equation using Table 17.1, Table 17.2, and
Figure 16.10. The correct numbers to use for this example problem are shown
in Table 17.3, Table 17.4, and Figure 17.5.

The rainfall intensity (1) is4.4 in/hr.

FIGURE 17.5. Rainfall intensity for sample problem.
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WithC = 0.40, | = 4.5in/hr, and A = 90 ac the peak rate of runoff is:

in ft3
Q=CIA=040x45— x90ac=162—
hr SEC

In this example the best estimate of the peak runoff rate is 162 cfs. Note that the
units do not cancel in the equation. This is because the C value is determined so
that the answer isin cubic feet per second.

17.5. Effect of Varying Recurrence Interval

The choice of recurrence interval will have a great influence on the peak rate
of runoff to be expected from a watershed. This is illustrated by the following
example.

Problem: Given the same watershed as the previous example, calculate the peak
runoff rate for recurrence intervals of 2, 5, 10, 25, 50, and 100 years.

Solution: Table 17.5

TABLE 17.5. Effect of varying recurrenceinterval.

Recurrence Time of Rainfall Runoff Watershed  Peak runoff
interval (yr)  concentration (min)  intensity (in/hr)  coefficient (C)  area(ac) rate (cfs)
2 33 3.0 0.40 20 108
5 33 38 0.40 90 137
10 33 45 0.40 90 162
25 33 55 0.40 90 198
50 33 6.3 0.40 90 227
100 33 7.0 0.40 90 252

17.6. Mixed Watersheds

The previous examples were the simplest kind because they had the same slope,
vegetation, and soil conditionsthroughout thewatershed. In nature, thisonly occurs
for very small areas. Watersheds usually contain different slopes, vegetation, soil
types, and farming practices. All of these variables affect thevalue used for C. Any
changesin the value used for C will change the calculated runoff. To cope with a
variablewatershed it is necessary to cal culate the weighted runoff coefficient (Cy,)
for the watershed.

Theweighted runoff coefficient isdetermined by finding theappropriate value of
C for eachfield or portion of the watershed that is different, multiplying that value
of C by the appropriate area (ac), adding up these products for all of the different
areas in the watershed, and then dividing their sum by the total watershed area.

Study Figure 17.6 and the following equation:

_(A1C1) + (ACo) + -+ + (AnCr)

CW ZA
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FIGURE 17.6. Example of a
mixed watershed.

Problem: Determine the weighted C for the watershed in Figure 17.6.

Solution:
_ (A1C1) + (A2C2) + (AsCy)

A
(35 x 0.60) + (20 x 0.40) + (30 x 0.82)

35420+ 30
21+8+ 246

85

Cw

53.6

T 85
= 0.6305...0r 0.63

The weighted C value for this watershed is 0.63.

17.7. Metric Problems

The Rational method was developed during the 1880s in the United States using
standard units. For use with metric units the user has two options. The first one
is to use the standard data and convert the answer from cubic feet per second to
cubic meters per second by dividing by 360. This resultsin the equation:

m3 CIA
© (Q) =360
where Q = peak flow (m?/s); A = drainage area (ha); C = runoff coefficient
(weighted); | = rainfal intensity (mm/hr); 360 = Conversion constant.
The second method isto use tables and graphs that have metric units. When this
method is used the coefficient of runoff is taken from Table 17.6.

The time of concentration isfound in Table 17.7.
Therainfall intensity is taken from Figure 17.7.
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TABLE 17.6. Recommended coefficient of runoff values for various selected land uses, Sl

units.
Hydrologic soils group*
Land use Description A B C D
Cultivated Land without conservation treatment 049 067 081 088
with conservation treatment 0.27 043 067 0.67
Pasture or Range Land Meadow  poor condition 0.38 063 078 0.84
good condition — 025 051 065
good condition — — 041 o061
Wood or Forest Land thin stand, poor cover, no mulch — 034 059 070
good cover 045 0.59
Open Spaces, Lawns, Parks, Golf
Courses, Cemeteries
Good Condition grass cover on 75% or more — 025 051 065
Fair Condition grass cover on 50% to 75% — 045 063 074
Commercial; and BusinessArea  85% impervious 0.84 090 093 0.96
Industrial Districts 72% impervious 067 081 0.88 092
Residential average % impervious
Average Lot Size (acres)
18 65 059 0.76 0.86 0.90
V4 38 029 055 070 0.80
13 30 — 049 067 0.78
172 25 — 045 065 0.76
1 20 — 041 063 074
Paved Areas parking lots, roofs, driveways, etc 099 0.99 099 0.99
Streets and Roads paved with curbs and stormsewers 099 0.99 099 0.99
gravel 057 0.76 084 0.88
dirt 049 069 080 084

Note: Values are based on NRCS (formerly the SCS) definitions and are average values.
Source: Technical Manual for Land Use Regulation Program, Bureau of Inland and Coasta
Regulations, Stream Encroachment Permits, New Jersey Department of Environmental Protection

* Group A Soils: High infiltration (low runoff). Sand, loamy sand, or sandy loam. Infiltration rate >

0.3 inch/hr when wet.

Group B Soils: Moderate infiltration (moderate runoff). Silt loam or loam. Infiltration rate 0.15 to 0.3

inch/hr when wet.

Group C Soils: Low infiltration (moderate to high runoff). Sandy clay loam. Infiltration rate 0.05 to

0.15 inch/hr when wet.

Group D Soils: Very low infiltration (high runoff). Clay loam, silty clay loam, sandy clay, silty clay,
or clay. Infiltration rate 0 to 0.05 inch/hr when wet.

TABLE 17.7. Time of concentration (minutes) Sl units.

Drainage way length (m)

Drainage way change

in elevation (m) 100 150 200 250 500 1,000 1,500 2,000
1 4 6 8 11 23 55 85 120
2 3 45 65 8 18 40 65 95
5 2 3 45 6 13 29 44 65
10 15 24 35 45 9 22 36 50
15 1.25 2 3 4 8 20 33 42
20 025 175 25 35 7 17 27 40
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FIGURE 17.7. Rainfall intensity, duration, and frequency for metric units.

Problem: Determine the peak rate of runoff for a 50 hectare cultivated field with
conservation practicesand soil group B. Thedrainageway hasachangeof elevation
of 2 mand alength of 1,000 m. The design calls for a 25-year storm.

m3
— | =CIA
(=)
= 0.43 x 120 x 50

3
— 2580 L
Sec

Solution:



18

Erosion and Erosion Control

18.1. Objectives

1. Understand the development of soil.

2. Understand the causes of erosion.

3. Be able to identify the two types of erosion.

4. Determine the rate of erosion using the Universal Soil Loss Equation.
5. Be able to explain common erosion control practices.

18.2. Introduction

Soil is a complex, constantly changing resource. It affects the life of plants and
thereby al animals, and it is affected by plants and animals. Sail is the primary
medium of growth for plants. It supplies nutrients, water, and a place to anchor
roots. Soil has an economic value and therefore any that islost from productionis
an economic loss. The topsoil has the most value because it is the primary source
of nutrients, chemicals, seeds, water-holding capacity, and organic matter. Sail is
formed and destroyed by erosion. In this chapter soil development, destruction,
and conservation will be discussed.

18.3. Soil Development

Soil is developed and destroyed by erosion. Soil develops from the breakdown,
or geological erosion, of sedimentary or volcanic parent material. As the forces
of nature: wind, water, heat, and cold, erode the parent material, the particle size
gradually decreases, and nutrients, water, and organic matter are mixed in. The
exact rate of breakdown is debatable, but one estimate is that it takes 100 to as
long as 1,000 years to develop 1 inch (25.4 mm) of topsoil.

244
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18.4. Causes of Erosion

Destructiveerosion isanatural process. Rivers have alwaysflooded and eroded the
banks, intense storms have caused excessive runoff which has eroded soil and left
itin awater way or pond. The problem isthat many of mankind activities greatly
accelerate natural erosion. The productivity of soil is destroyed by man-made or
man-accel erated erosion that occurs from poor agricultural and construction prac-
tices. Land with permanent vegetation is very stable, but as soon as vegetation is
removed, the soil is exposed to rainfall and other forces of nature and erosion ac-
celerates. Activities such as the construction of roads and buildings, cultivation of
fields, andtimber harvesting al removethenatural protective cover. Thetwo agents
of erosion, water and wind, will be discussed in the next section, and then amethod
for estimating the amount of soil that islost by water erosion will beillustrated.

18.5. Two Types of Erosion
18.5.1. Water

The amount of erosion caused by water is dependent on four factors: climate, soil,
vegetation, and topography. The impact of climate is related to the amount and
the intensity of rain. The greater the annual rainfall—the greater the potential for
water erosion; and as the frequency of intense storms increases—the greater the
potential for water erosion.

The contribution of soil to erosion relatesto the size of the soil particles and the
moisture content of the soil. Sandy and organic soils have the greatest potential
for water erosion. These soils are not bound together, especialy when wet, and
the soil particles are easily moved.

Vegetation plays an important role in water erosion; it reduces the energy of the
raindrops striking the soil, in turn reducing the displacement of the soil. In culti-
vated fields, crop residues in and on the soil provide the same function as natural
vegetation. The amount of crop residues can be measured by randomly laying out
a 100-ft tape across a field and counting the number of one foot marks that are
over or touching any residue. This number isthe residue cover asapercent. If four
foot marks are over a piece of residue, then the percent is 4%. The recommended
minimum percentage is based on the location and the soil type.

Theinfluence of topography is associated with the slope of theland. The greater
the slope, the greater the potential for water erosion.

These four factors predict what type of water erosion occurs and how much
occurs. Water erosion usually is divided into three stages: raindrop, sheet and
rill, and gully. Raindrop erosion is the soil splash resulting from the impact of
water on soil particles. If the soil is covered with vegetation, raindrop erosion
is aimost zero. When the soil is a bare cultivated field, raindrop erosion can be
significant. It is estimated that raindrops can displace soil particles 2 ft vertically
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and 5ft horizontally. The effect of raindrop erosion increases asthe slopeincreases
because there is greater movement down slope than thereis up slope.

Sheet and rill erosion are the next two stages. They are combined because many
experts believe sheet erosion only existsintheory. Astherainfall intensity exceeds
theinfiltration rate of the soil, water startsto move acrossthe soil’ssurfacein athin
sheet. Almost as soon as the movement begins, small but well-defined channels
develop, which are called rills. Rills can be easily farmed over and are easy to
overlook, but they account for most of the soil loss to water erosion.

Gully erosion is the next stage. Gullies are an advanced stage of rills. Small
ones may till be farmed over, but if they are not checked, they become too large
and then must be farmed around.

18.5.2. Wind

Movement of the soil due to wind erosion isnot down the slope asin water; instead
the direction is determined by the wind. When the soil is completely covered with
vegetation, very little wind erosion occurs because the vegetation reduces the
velocity of the wind at the surface of the soil. When the wind has access to the
surface, erosion may occur. Thevelocity of thewind, the soil moisture, and the soil
particle size determine the amount of erosion and type of erosion. The greater the
velocity—the greater the volume and the larger the size of particle that the wind
can pick up. Fine sandy soils are affected by wind more than clay soils. Dry soils
are easier to erode than moist soils.

Wind erosion is not divided into types; it only varies by degree (stages). There
are three stages of movement. All three stages may occur simultaneously. Thefirst
stage, suspension, occurs when soil particles are fine enough and the velocity is
high enough to keep the particles suspended in the air. Very fine particles can be
transported for hundreds of miles. The second stage is skipping and bouncing,
or saltation. This state of wind erosion accounts for the largest volume of soil
movement. In saltation, the wind is strong enough to pick up the soil particle, but
not strong enough to hold them in suspension. The wind lifts up the particles and
carries them for a short distance, but then they are dropped. The third stage is
rolling or creep. In the creep stage the wind moves or rolls the soil particles across
the surface of the soil, but it does not pick them up.

The five factors used to estimate wind erosion are soil erodibility, climate, soil
roughness, field length, and vegetation. To estimate the amount of wind erosion for
a specific location, contact the National Resource Conservation Service (NRCS).

18.6. Estimating Soil Loss

Equations have been developed to estimate the amount of soil loss to water and
wind erosion. These are called the Universal Soil Loss Equation (USLE) for water
and the wind erosion equation (WEQ) for wind. The USLE for water has been
updated and the new version is called the Revised Universal Soil Loss Equation
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(RUSLE). Another version, RUSLE?, is a computer program. The WEQ is a
computer program that can be utilized through a NRCS office. The USLE for
water is:

A=RxKxLxSxCxP

where A = Predicted average annual soil loss(T/ac/yr); R = Rainfall factor; K =
Soil erodibility factor; L = Slope length factor; S = Slope gradient factor; C =
Cropping management factor; P = Erosion control practice factor.

For thisdiscussion, several of these factorswill be combined to give thefollow-
ing equation:

A=RxKxLSxCP

The USLE assigns numerical values to the factors that influence water erosion.
Therefore, the accuracy of the calculated soil loss is only as good as the nu-
merical values representing these factors. The tables and graph included here are
generalized to show the influence of the different factors and to aide in the un-
derstanding of the equation. These values should not be used for the design of
soil conservation structures or for estimating soil loss for government programs.
More accurate val ues for specific areas can be obtained from the NRCS or similar

agency.

18.6.1. Rainfall Factor (R)

Therainfall factor isameasure of theintensity and duration of the expected rainfall
events. Common values for R range from 100 to 350. A higher number should be
used in an area of high annual rainfall and high rainfall intensities. Numbers are
available for specific locations from government sources.

18.6.2. Soil Erodibility (K)

TheK value isameasure of the soil’s susceptibility to erosion. The soil’s texture,
organic matter content, and permeability influence the K value. The values are
based on acultivated, continuousfallow arbitrary field with aslopelength of 72.6 ft
and a slope of 9%. Typical values for some soils and organic matter contents can
be found in Table 18.1.

18.6.3. Topographic Factor (LS)

Thetopographic factor isameasure of the expected soil lossfor thefield compared
to the arbitrary field with a slope length of 72.6 ft and a slope of 9%. It is a
combination of the slope length and the percent of slope. An estimate for LS can
be found in Figure 18.1.
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TaBLE 18.1. Soil erodibility factor (K) (ton/ac).

Organic matter content %

Textural class 0.5 2.0 4.0
Fine sand 0.16 0.14 0.10
Very fine sand 0.42 0.36 0.28
Loamy sand 0.12 0.10 0.08
Loamy very fine sand 0.44 0.38 0.30
Sandy loam 0.27 0.24 0.19
Very fine sandy loam 0.47 041 0.33
Silt loam 0.48 0.42 0.33
Clay loam 0.28 0.25 0.21
Silty clay loam 0.37 0.32 0.26
Silty clay 0.25 0.23 0.19
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FIGURE 18.1. Typical topographic factors (LS) for slopes of 3-20% and slope lengths of
10-600 ft.
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TABLE 18.2. Typical cropping and management factors (CP).

Cropping practices

Management Up and down Terraces and Onthe
factors the slope field boundary  contour
Continuous small grain MRU (6/20) 0.29 0.21 0.15
Continuous small grain HRU (6/20) 0.22 0.16 0.11
Continuous small grain MRU (8/1) 0.22 0.16 0.11
Continuous small grain HRU (8/1) 0.18 0.13 0.09
Continuous small grain ROS 0.12 0.09 0.06
Continuous cotton MF no WC 0.59 0.42 0.30
RC Continuous grain sorghum (25-30 bu) 0.48 0.34 0.24
RC Continuous grain sorghum (3545 bu) 0.42 0.30 0.21
Continuous peanuts with WC 0.43 0.30 0.22
Continuous peanuts no WC 0.54 0.38 0.27
Alfafa5b yr/small grain 2 yr 0.05 0.05 0.05

MRU = Moderate Residue Turned Under; HRU = Heavy Residue Turned Under; RC =
Row Crop; ROS = Residue on Surface at Seeding Time; MF = Moderate Fertilizer;
WC = Winter Cover.

18.6.4. Cropping and Management Factor (CP)

The original USLE separated the cropping factor (C) and management factor (P)
intotwo different terms. In thisdiscussion, they have been combined. The cropping
factor is used to estimate the relative effectiveness of the practice to retard soil
loss when compared to a continuously tilled field. The management factor (P) is
an estimation of the effect of conservation practices in reducing soil loss. These
factors combined are a function of the crop raised, the management practice, the
planting date, the amount of residue on the surface, and thetillage practice. Values
representing these factors can be found in Table 18.2.

Problem: Estimate the annual erosion for afield having a rainfall factor of 220,
consisting mainly of loamy sand with 2% organic matter, and averaging a4% slope
with a slope length of 400 ft, which has been in continuous small grain, normally
planted in June, with moderate residue worked under and farmed up and down the
slope.

Solution: Using the USLE and the appropriate tables and figure:
A=RxKxLSxCP

where R = 220; K = 0.10, Table 18.3.
LS = 0.73, Figure 18.2.
CP = 0.29, Table 18.4.
A=RxK xLSxCP =220x 0.10 x 0.73 x 0.29
= 4.6574 or 4.6 T/aclyr
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TaBLE 18.3. K factor for sample problem.

Organic matter content %

Textural class 0.5 2.0 4.0
Fine sand 0.16 0.14 0.10
Very fine sand 0.42 0.36 0.28
Loamy sand 0.12 0.08
Loamy very fine sand 0.44 0.38 0.30
Sandy loam 0.27 0.24 0.19
Very fine sandy loam 0.47 041 0.33
Silt loam 0.48 0.42 0.33
Clay loam 0.28 0.25 0.21
Silty clay loam 0.37 0.32 0.26
Silty clay 0.25 0.23 0.19

The correct K factor is 0.10.

FIGURE 18.2. LS for sample problem.
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TABLE 18.4. CP value for sample problem.

Cropping practices
Management Up and down Terraces and On the
factors the slope field boundary contour
Continuous small grain MRU (6/20) 0.21 0.15
Continuous small grain HRU (6/20) 0.22 0.16 0.11
Continuous small grain MRU (8/1) 0.22 0.16 0.11
Continuous small grain HRU (8/1) 0.18 0.13 0.09
Continuous small grain ROS 0.12 0.09 0.06
Continuous cotton MF no WC 0.59 0.42 0.30
RC Continuous grain sorghum (25-30 bu) 0.48 0.34 0.24
RC Continuous grain sorghum (3545 bu) 0.42 0.30 0.21
Continuous peanuts with WC 0.43 0.30 0.22
Continuous peanuts no WC 054 0.38 0.27
Alfalfa5 yr/small grain 2 yr 0.05 0.05 0.05

MRU = Moderate Residue Under; HRU = Heavy Residue Under; RC = Row Crop; ROS = Residue
on Surface at Seeding Time; MF = Moderate Fertilizer; WC = Winter Cover.

18.7. Erosion Control

The best philosophy for erosion control isthat it is better to prevent erosion than
totry to correct it. Thereisno best solution for erosion control that will work in all
situations. Erosion prevention and control must be developed for each site using
the resources that are available.

On cultivated land, the best methods to use are those activities that will reduce
the effect of wind and water on the soil particles. For the prevention of water
erosion it is important to provide as much protection as possible for the surface
of the soil. Thisincludes management of tillage practices to |eave residue on the
surface and the use of cover cropsin nonproductive seasons. Additional protection
is provided by reducing the length of the continuous slope by installing terraces.
To illustrate the effect of these practices, rework the sample problem with the
appropriate values for terraces and residue.

Problem: Estimate the annual erosion for afield that has a rainfall factor of 220,
consists mainly of loamy sand with 2% organic matter, averages a4% slopewitha
slope length of 200 ft, and has been in continuous small grain with heavy residue,
normally planted in June, and farmed with terraces.

Solution:
A=RxKxLSxCP =220x 0.10 x 0.50 x 0.21 = 2.310or 2.3 T/ac/yr.

In the original problem the soil loss was 4.6 T/ac/yr. With the modifications the
soil lossis 2.3 T/aclyr, areduction of 50%.

Residues on the surface al so help prevent wind erosion, but reducing the length
of the slope does not. The critical factors for preventing wind erosion, other than
residue, are the roughness of the surface and the unobstructed distance that the
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wind can blow. Reducing the unobstructed distance is an effective control. This
explains the prevalent use of shelterbeltsin the Great Plains region. A shelterbelt
will provide protection downwind for up to ten timesits height.

Other methods are appropriate for the control of both water and wind on small
areas for a short duration, such as construction sites. A common practice isto use
commercial silt fences, bales of straw or nets to help prevent soil from leaving
the site. Installing temporary wind barriers and keeping the ground covered can
control wind erosion.

18.8. Metric Problems

This version of the USLE is only available in standard units and was included to
illustrate the factorsthat affect soil erosion. Versions of the Revised Universal Soil
Loss Equation (RUSLE) are available on the world wide web using metric units.
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Irrigation

19.1. Objectives

1. Understand the purpose and use of irrigation.

2. Be able to describe the common irrigation systems.

3. Beableto calculate the required system capacity.

4. Be able to determine the irrigation interval and the depth of water to apply.

19.2. Introduction

Themaost limiting and most variable environmental factor affecting the productivity
of plantsiswater. Whenever adequate water is not available, farmers have always
triedtoirrigatetheir crops. Irrigation water hasalwaysbeenin short supply, butitis
becoming ascarcecommaodity in many regions. Evenwhereitisavailable, pumping
and/or transportation costs have increased dramatically in many locations. Today
the profitability of irrigated agriculture is dependent of efficient use of water. The
effective and efficient use of irrigation is dependent on four factors.

1. The effect of irrigation on plant production.

2. The best system for agiven field and water supply.

3. Determining how much water to apply at peak use rate and when to apply it.
4. The quality of the water.

This chapter will discuss these aspects of irrigation.

19.3. The Effect of Irrigation

Agricultural plantsneed warm temperatures, sunlight, nutrients, and water to grow.
In many regions of the world the required temperature and sunlight is available,
but water is not. All plants have a minimum annual water requirement to survive
and an optimum annual water requirement for maximum production. Historically,
the availability of water has determined where crops can be grown. A high demand

253
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crop, such asrice, could not be grown in aregion that has a low annual rainfall.
In addition, whenever the water available to the plant is less than the optimum
amount the production is reduced. The application of water through irrigation can
provide the missing requirement for plant growth. The result of irrigation is that
the area where some crops can be grown is expanded and the production of all
cropsisincreased by supplementing rainfall.

19.4. Irrigation Systems

Once the decision has been made to irrigate, the next consideration is what type
of system to use. Water is applied in one of three ways: from above the ground, on
the ground surface, or from below the surface. The choice usually is based on cost
and topography. This section will review the basic types of irrigation systems.

19.4.1. Above Ground

The most common above ground irrigation system is the sprinkler. In sprinkler
systems, water isinjected into the air by one of the three types of nozzles. spray,
rotor, or impact. Sprinkler systems can be used on any land that can be culti-
vated. Sprinklers may be solid set (in a permanent position) or movable. The
common means of movement are: (1) manual-awn sprinkler or pipe system;
(2) tractor-moved—skid or wheel-mounted system; (3) self-moved-side wheel roll
or big gun system; and (4) self-propelled—center pivot and lateral move system.
Different modifications and variations of these systems are used. The best system
depends on the topography, shape and size of the field, the amount and cost of
labor for movement, and the value added for the crop. For sprinkler systems,
it is important that the application rate not exceed the infiltration rate of the
soil.

19.4.2. Surface

In surface irrigation, water is applied by alowing it to flow over the surface by
gravity or through drip valves (a process called trickle or drip irrigation). The
common gravity systems are flood and furrow. Flood systems require relatively
flat land and the water is distributed in level borders or contoured levees. Land for
furrow irrigation can haveasmall slope. For level bordersand contoured levees, the
water usually is delivered by surface ditch. Ditches can deliver water for furrows,
but a gated pipe or a siphon tube is also used. As a general rule, gravity systems
require more labor than sprinkler systems to maintain the ditches and the dikes,
move the gated pipe, and control the flow of the water.

In trickle irrigation, drip valves or emitters are located along a line at uniform
spacing or at each large plant. These systems have high application efficiency
because a very small amount of water is applied and it is applied directly to the
plant.
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19.4.3. Subsurface

The two most common subsurface irrigations system isaporous pipe buried in the
root zone or atrickle system buried alongside the plants.

19.5. Depth of Water to Apply

Seasonal water demand and peak daily usevary considerably from crop to crop and
from onefield to the next. Deciding when to irrigate and how much water to apply
are the two most difficult decisionsto makein managing irrigation systems. Many
different methods have been developed to help answer these two questions. The
following discussion will explore some of the factors influencing these decisions
and present one method for determining how much water to apply and theirrigation
interval.
The amount of water used by plants depends on five factors:

1. Thelength of the growing season

2. The amount of daylight per day

3. Thedaily temperature

4. The speed and direction of the wind
5. The crop’s stage of growth

For any given plant, the daily rate of use will increase until the plant reaches
maturity, and then it will decrease, Figure 19.1. The peak water use rate occurs
at the height of the growing season. Table 19.1 shows the peak use for a number
of crops with both short and long growing seasons, and the root zone depth from
which each crop extracts most of its moisture.

Two characteristics of soil must be considered in determining how much water
should be applied: (1) therate at which soil can absorb (store) water, or theinfiltra-
tion rate; and (2) the total amount of water that can be stored. The infiltration rate
is determined by the soil texture and the total amount of water that can be stored
is determined by the soil depth. Loams and clays can hold more water than sands,
as shown in Table 19.2. Also note that the type and the depth of subsoil make a
difference in the amount of water that can be stored per irrigation. For example,
soils having more compact subsoil can store a greater amount of water than the
same soils having a uniform depth.

Peak use P Plant maturity

(in/day)}

Daily water demand

FIGURE 19.1. Typical daily water
demand. Growing season (days)
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TABLE 19.1. Root zone depth and peak water use rate.

Length of growing season

Root zone depth of

principle moisture 180-210 days 210-250 days
Crop extraction (in) Peak use (in/day) Peak use (in/day)
Alfalfa 48 0.29 0.32
Beans 24 0.20 0.20
Corn 36 0.30 0.35
Cotton 36 — 0.28
Grain sorghum 30 0.20 0.20
Melons 30 0.20 0.22
Other truck 24 0.20 0.22
Pasture 24 0.28 0.30
Peas 36 0.19 —
Potatoes 24 0.38 0.20
Small grain 30 0.20 0.22
Sugar beets 36 0.28 0.30
Tomatoes 48 0.20 0.22
Vineyards 48 0.22 0.25

Therooting depth of the crop also influences the amount of water that should be
stored. Any water that infiltrates into the soil to a depth below the root zoneislost
to the plant. These factors were taken into consideration during the development
of Table 19.1 and Table 19.2.

To use these tables first consult Table 19.1 for a particular crop and growing
season length and obtain values for (1) the root zone depth of principal moisture
extraction and (2) the peak daily water use. Then Table 19.2 can be used to de-
termine the number of inches of water to store per irrigation. Note that you must
know the soil type or profile on which the irrigation is to take place and the root
zone depth of principal moisture extraction of the crop.

Problem: What is the root zone depth, peak daily use, and net amount of water
to store per irrigation for a crop of corn grown on alocation where the season is
greater than 210 days on a silt loam soil over compacted subsoil?

TABLE 19.2. Net amount of water to store per irrigation.

Net amount of water to store (in)
for various root zone depths

Soil profile 24in 30in 36in 48in
Coarse sandy soil, uniform to 6 ft 0.85 110 1.30 175
Coarse sandy soil over compacted subsoil 150 1.75 2.00 250
Fine sandy loam uniform to 6 ft 175 2.20 2.60 3.00
Fine sandy loam over compacted subsoil 2.00 2.40 2.80 325
Silt loam uniform to 6 ft 225 2.75 3.00 4.00
Silt loam over compacted subsoil 250 3.00 3.25 4.25

Heavy clay or clay loam soil 2.00 240 2.85 3.85
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Solution: Using Table 19.1 and Table 19.2:

Length of growing season

Root zone depth of

principle moisture 180-210 days 210-250 days
Crop extraction (in) Peak use (in/day) Peak use (in/day)
Alfalfa 48 0.29 0.32
Beans 24 0.20 0.20
Cotton 36 — 0.28
Grain sorghum 30 0.20 0.20
Melons 30 0.20 0.22
Other truck 24 0.20 0.22
Pasture 24 0.28 0.30
Peas 36 0.19 —
Potatoes 24 0.38 0.20
Small grain 30 0.20 0.22
Sugar beets 36 0.28 0.30
Tomatoes 48 0.20 0.22
Vineyards 48 0.22 0.25

Root zone depth = 36 in.
Peak daily use = 0.35 in/day.

These figures show that the net amount of water to store per irrigation is 3.25
inches, Table 19.3.

Next determine the amount of water to apply. The amount of water to apply
must be greater than the amount to store becauseirrigations systems do not operate
at 100% efficiency. Some of the water will evaporate, some runs off, and some
percolates below the crop root zone. The term application efficiency is used to
describe these losses. It is defined as the ratio of the depth of water stored to the
depth of water applied, expressed asapercent. The application efficiency of awell-
designedirrigation system will be between 60 and 80%. A pplication efficiency can

TABLE 19.3. Net amount of water to store for sample problem.

Net amount of water to store (in)
for various root zone depths

Soil profile 24in 30in 36in 48in
Coarse sandy soil, uniform to 6 ft 0.85 1.10 1.30 175
Coarse sandy soil over compacted subsoil 150 175 2.00 250
Fine sandy loam uniform to 6 ft 175 220 2.60 3.00
Fine sandy loam over compacted subsoil 2.00 2.40 2.80 325
Silt loam uniform to 6 ft 2.25 2.75 3.00 4.00
Silt loam over compacted subsoil 250 300 425

Heavy clay or clay loam soil 2.00 240 2.85 3.85
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be used to determine the amount of water to apply in the following manner:
Depth of water stored (in)

Depth of water to apply =
epih OT weter 0 8Pl = — pplication efficiency
or:
DW
DWA=—S
AE

where DWA = Depth of water to apply (in); DWS = Depth of water to store (in);

AE = Application efficiency (as adecimal).

Problem: How much water should be applied for the corn crop in the previous

problem if the application efficiency is 70%?

Solution:

DWS 325in
AE 070

Itisalso necessary to determine anirrigation interval, which isthe number of days
it takes the crop to use up the water stored in the soil. The irrigation interval is
determined by dividing the amount of water stored in the soil by the plants daily
use. For peak use theirrigation interval is:

DWA = =4.642...0r 4.64in

wherelRI = Irrigation interval (days); DWS = Depth of water to store(in); PDU =
Peak water use (in/day).

Problem: What istheirrigationinterval for the corn crop in the previous problem?

Solution:
DW 25i
IRI = PDS: 3 5:: — 9.285...0r9.3day
0.35 day

For this corn crop, if 3.25 inches of water is stored in the soil per irrigation, at the
time of peak use it must be irrigated every 9.3 days.

If there israinfall during the irrigation period, the irrigation interval should be
adjusted accordingly. For example, if therewere 1.25 inchesof rainonthecorn crop
in the previous problem, then we would divide the amount of rain (in) by the water
needsof thecrop (in/day) and extend theinterval the corresponding number of days.
For the peak demand of thecorncrop, 1.25 = 0.35 = 3.6 days. Instead of irrigating
again in 9.3 days, theirrigation interval could be extended to 12.9 or 13 days.

19.6. System Capacity

System capacity is the maximum amount of water that an irrigation system can
deliver on acontinuous basis. Different units are used to describe system capacity.
These are acre-feet (ac-ft, that is, the amount of water it will taketo cover one acre,
one foot deep), acre-inch (ac-in), gallons per minute (gal/min or gpm), and cubic
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feet per second (ft3/sec or cfs). The required pumping capacity of an irrigation
system depends on the area to be irrigated (ac), the depth of water to apply (in),
andthelength of timethat theirrigation systemisoperated (hr). Length of operation
time refers to pumping time, not clock time. Pumping timeis only the time water
isflowing.

The amount of time per day that an irrigation system can operate depends on the
type of system and the amount of maintenance it requires. A self-propelled unit
may be able to run severa days without stopping, whereas manual-move, tractor
towed, and self-moved systems must be shut down at regular intervals. For systems
other than center pivots and lateral moves, only a portion of afield isirrigated at
onetimeand timeisrequired to movethe system from one portion of thefield “ set”
to another “set.” Thetermirrigation period isused to designate the number of days
that a system can apply the water for one irrigation to a given area. Notethat it is
necessary for theirrigation period to be equal to or lessthan theirrigation interval.
The required capacity of a system, in gallons per minute, can be determined by
the following equation:

453 x A x DWA

IRP x HPD
where RSC = Required system capacity (gal/min); 450 = Units conversion con-
stant; A = Areairrigated (ac); DWA = Depth of water to apply per irrigation (in);
IRP = Irrigation period (day); HPD = Time operating (hr/day).

RSC =

Problem: Determine the required system capacity (gal/min) for the corn crop in
the previous problem when the field areais 200 acres, and the system can operate
for 18.0 hr per day for 7.7 days.

Solution:
453 x A x DWA 453 x 200 & x 4.65in
RC= "IRPXHPD 77 gay » 180N
7 day x <G
424290 gal

= .61 —
138.6 3039.61 or 3,000 i

For 200 acres of long-season corn grown on silt loam soil over compacted subsoil,,
irrigated with a system that is 70% efficient and limited to operating 18 hours per
day for 7.7 days, the system must be able to deliver 3,040 gallons of water per
minute.

Note: This is an example of an equation with a units conversion constant. The
same problem can be solved using the units cancellation method.

ga 1lhr 1 day 1 1ga 4.65in
—_ = . X X X X
min ~ 60min =~ 18hr = 7.7day = 231in 1
144in*  43560ft" ~200ac _ 5833555200
1ft? lac 1 1920996

_ 3036.70r3000 93
min
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In some situations it might be necessary to use units of capacity other than gallons
per minute. For example, water supplied from alarge reservoir is often measured
in acre-feet. In these cases, units cancellation and/or the appropriate conversion
factors (Appendix | or I1) can be used to convert the units.

Problem: What will the system capacity need to be in units of acre-feet/min?

Solution: Using units cancellation and system capacity from the previous
problem:

ac-ft gd 113 lac
— =3, = x %
min min = 4.48ga = 43,560 ft2
ft
— 0.009319...0r 93E — 3 X1
min

As noted earlier, system capacity is a function of four variables: area (ac); wa-
ter flow rate (gal/min, ft3/min, ac-ft/min, etc.); depth of water applied or peak
use (in); and time (min, hr, or days). This relationship is expressed mathemati-
caly as:

DxA=QxT

where D = Depth of water, either applied or peak use (in); A = Areairrigated
(ac); Q = Water flow rate (cfs); T = Length of time water is applied (hr).

When any three of the variables are known, the remaining one can be calcu-
lated by rearranging the equation and substituting the values of the known vari-
ables. You must enter flow rate (Q) in cubic feet per second, depth in inches,
and time in hours. The following discussion will illustrate several uses of this
equation.

In the previous problem we determined the system capacity using units cancel-
lation. If it is necessary to know how much water has been applied, the peak use
does not accurately describe what we are solving for. When we want to know the
depth of water that has been applied, D becomes the depth of water applied (Dwa)-
Thiswill work because the unit of measure isthe same for both peak use and Dy
(inches).

Problem: A producer spends 120 hr irrigating 90.0 acres. The pump discharges
1,350 gallons per minute. What average depth of water (in) is applied?

Solution: Because we want to know the amount of water applied, not the amount
available to the plants, the efficiency factor is not used. Also, Q must be con-
verted from gal/min to ft3/sec. Rearranging the equation, substituting depth of
water to apply (Dwa) for the depth (D), and including the conversion factor
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1ft3/sec = 2.25 x 102 gal/min:
Dpan x A= QxT

x T
Dwa = QA
ft3
gl 225E-3 —
1350 2— x ——SLC | v 120hr
min 1.9
mln
- 90 ac
. 3645
)
= 405in

An examination of thisproblem showsthat the units do not cancel. However, when
we enter the values of the variables with the units listed above we can obtain an
answer very close to the true value. The symbol = means approximately equal .
The exact solution using unit conversion/cancellation is:

DWAXAZQXT
T
Dya = QZ

al n® 113
13509—.><231— N 120 x0T o N
min ga = 1,728in° hr ft

ft*
90ac x 43560 I

~

=3.98in

In this case, the error in the approximate solution is:

4.05 — 3.98
% Error = ~ 308 x 100

= 176 %

Variations occur in the use of the equation for different types of irrigation systems.
In situations where the limiting factor isthe avail ability of water, the problemisto
determine the maximum areathat can be irrigated with the available water supply.

Problem: What is the largest size of lawn (ft?) that can be irrigated in 12 hr if
aminimum of 0.5 inch of water is applied at each irrigation, the system is 90%
efficient, and the water supply delivers 3.5 gal/min?

v fE_lgd  1min it G ff . 1gd _ 225x10°f¢
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Solution: Rearranging the eguation, adding the efficiency factor, and converting
the area to square feet:

DxA=QxT
QxT lac

A () = 0.90
(ft) ( D = 43,560ft2>X

H 3
3593 Bomin - 1M N oon
min lhr 7.48 gal lac
= : x x 0.90
0.5in 43,560 ft?
in
12—
ft
168.5 1
= 0.90
(0.04167 * 43,560) x
= 017ac

If flood irrigation is used to water a field, assuming that the water flow rate is
limited, it usually is necessary to determine the amount of time that the water
should flow to cover the field at the desired depth.

Problem: How long will it take to apply 4 inches of water uniformly over 120
acres when the water is available at the rate of 20 cfs? (Assume 100% efficiency.)

Exact Solution:

DxA=QxT
Dx A

hr) =
T(hr) 0

2
40in x -ft x120a(:x43,560%

121n

ft sec min
200 - x 60 22 x g0 M1
Sec min h

1,742,400

72,000 =242hr

During furrow irrigation it is important to know how long the water must run to
apply the desired amount for each set of furrows. Three values are necessary to
calculate time: the water flow rate for each furrow or for the entire set, the area of
thefurrow or the set, and the amount of water to be applied. The areais determined
from the number of rowsin the set, the row spacing, and the length of the row.

Problem: How much time is required to apply 3 inches of water to sixty
32-inch rows when the rows are one half mile long, and the system capacity
is 30 gal/min/row?
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Solution:
DxA=QxT

D x A
T =
Q
- Number x Spacing (ft) x Lenght (ft)
o ft?
43,560 —
ac
i 1f f
60 Tows x 32 - x ' 0.5 mile x 5280 -
_ row 12in mile
ft2
43,560 —
ac
—969...ac
al 3
s\ 3003 225€E-3 {L 3
(fi> — — M + 60 row x 79‘%:4.05'l
sec row 198 sec
min
_30x989... _.1er  or72hr
4.05

It will take 7.2 hr to apply 3.0 inches of water to the field.

19.7. Seasonal Need

Seasonal water demand is the amount of water (in inches) that a crop must have
during one growing season for maximum production. The seasonal water demand
will vary from season to season, and for each crop and region. Table 19.4 contains
some typical values for three regions of the United States.

Knowledge of the seasonal water demand for acrop in agiven areais useful for
determining the contribution of irrigation to the cost of production and the total
amount of water that will be needed. When the cost of water is known (usually
expressed as dollars per acre-feet), as well as the seasonal demand of the crop, the
normal rainfall during the growing season, and the number of acres, it is possible

TABLE 19.4. Typical seasonal water demand for some crops (in).

Western region Central region Eastern region

Alfalfa 36.0 36.0 33.0
Corn 230 25.0 210
Cotton 31.0 20.0 19.0
Grain sorghum 20.0 22.0 21.0
Oranges 33.0 — —

Hay 31.0 — 36.0
Sugar beets 36.0 29.0 —

Tomatoes 19.0 — 14.0

Source: Planning for an Irrigation System, American Association for Vocational Instructional Materials
(AAVIM), Athens, Georgia.
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to estimate the total amount of water that will be needed and what it will cost. To
determine total seasona use, the efficiency of the irrigation system also must be
considered. Typical efficiency is 60-80%.

Problem: How much water (ac-ft/yr) is needed to supply 120 acres of cotton in
the central region if the normal rainfall during the growing season is 5.0 inches,
and the efficiency of the irrigation system is 70%?

Solution: Using units cancellation:
ac-ft 120ac 1ft 20.0in—5.0in 1

= X - X X —=
yr 1 12in lyr 0.7
_ 1800 _ 514085, or210 &M

84 yr

o

Problem: What is the total water cost if the price is $25.00 per acre-foot?

Solution: Using units cancellation:

E =25.00 i x 210 act = 5250 or 5,200 E
yr ac-ft yr yr

19.8. Metric Problems

Determining the net water to apply and store in the root zone is dependent on
having the appropriate datafor the tablesin Sl units. They are not provided in this
text, but additional problems such as system capacity can be computed in Sl units.

Problem: determine the pump capacity that will be required to apply 30.5 mm of
water to 50.0 hawhen the irrigation interval is 10 days and the pump can operate
20.0 hr per day.

Solution: Using units method

md 1m 10,000 m? 1 day
Capacity [ — ) = 30.5 50 hax ———
e y(min) mm 1,000 mm “"1ha ax 20.0 hr
1 lhr
X — X "
10day 60 min
3
=127 1
min
By equation:
RSC m3 _ A x DWA _ 500x305 305
hr /] IRPxHPDx01 10x20x0.1 20

3
— 15.250r 76.25 %

Or

3
=127 1
min
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Problem: A producer spends 120 hr irrigating 35.0 hectares. The pump discharges
5.2 cubic meters per minute. What average depth of water (mm) is applied?

Solution:
Depth (mm) 1,000mm 52m® lha 1
= X X X
® Imin © 10,000m?  350ha
K OMN o0 he
1hr

_ 3744E7
~ 35E5

= 106.97...0r 110 mm

Problem: What is the largest size of lawn (m?) that can be irrigated in 6.0 hr if a
minimum of 1.3 centimeters of water is applied at each irrigation, the system is
90% efficient, and the water supply delivers 13.0 Liters per minute (L/min)?

Solution:
130L 1md 60 min 1 100 cm
- X X X X
min 1,000 L 1hr 1.3cm 1m
_ 7.8 E4

_ 2
13E3 —o0m

Area(m?) =
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Handling, Moisture Management, and
Storage of Biological Products

20.1. Objectives

1. Be able to describe the common methods of handling biological products.

2. Be able to determine the size and horsepower requirements of screw-type
conveyors.

3. Be able to determine the size and horsepower requirements of pneumatic
COnveyors.

4. Be able to determine the amount of water to extract from or add to biological
products.

5. Understand the requirements of biological product storage.

20.2. Introduction

The term biological products describe all of the food, feed, and fiber produced by
agriculture. These productsinclude everything from fruits and vegetablesto grain,
hay, and cotton. Although the diversity of agricultural production is too broad
to be totally covered in this text, the following sections will discuss some of the
principlesinvolved in the handling, drying, and storage of these products.

20.3. Handling

Because of differences in shape, size, and consistency, each product must have
a handling system capable of moving that specific product. The designer of a
handling system also must consider product perishability and the desired form
of the finished product. A harvester designed to harvest tomatoes for the fresh
vegetable market will be different from one designed to harvest tomatoes used
for catsup. Because of the prevalence of grains across the United States, they
will be used to illustrate some of the basic principles of handling biological
products.

Grainswereoneof thefirst productsto be mechanically moved becausethey flow
by gravity, are small, and have arelatively hard outer coat. These characteristics

266
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FIGURE 20.1. Auger conveyor.

alow them to be moved by different mechanical devices. Augers and pneumatic
conveyors will be discussed in the following sections.

20.4. Augers

Augers are available in two types, Archimedean screw and belt. Of the two, the
screw type auger is the most popular in agriculture and it is the one that will be
used in the following discussion and sample problems. An auger is like abolt, but
instead of threadsit uses flightsthat turn inside atube. Another name for an auger
isascrew conveyor. Asthe auger rotates, the flights move the product through the
tube similarly to the way that threads move a nut on a bolt. Augers are available
in several diameters and are capable of handling many different types of products.
Augers have the advantage of requiring less horsepower per bushel and having
fewer mechanical parts than pneumatic systems; but their disadvantages include
the danger of the exposed auger at the inlet, and their requirement of more space
because the inlet is some distance from the outlet, Figure 20.1.

Augers are selected on the desired capacity (bu/hr) and length requirements.
The length is usually predetermined by the distance needed to move the grain, if
horizontal, or by the discharge height and angle if the auger is at an angle. The
selection criteriaare primarily based on the auger diameter and speed because the
capacity increases as the speed increases. The following discussion will illustrate
how the capacity and energy requirements for augers can be determined.

Table 20.1 and Table 20.2 contain typical values for two sizes of screw augers
and two different crops. Thistype of information can be used to make decisionsin
managing agrain handling system, such as determining the size of auger required
to convey grain at agiven rate (bu/hr).



268 20. Handling, Moisture Management, and Storage of Biological Products

TABLE 20.1. Screw auger capacity handling dry corn (12 in exposure).

Auger angle of elevation

Auger o° 45° 90°

Size RPM bu/hr hp/10 ft bu/hr hp/10 ft bu/hr hp/10 ft

4in 200 150 0.12 120 0.15 60 0.11
400 290 0.29 220 0.29 130 0.24
600 420 0.38 310 0.45 190 0.36

6in 200 590 0.38 500 0.44 280 0.32
400 1090 0.56 850 0.88 520 0.70
600 1510 0.84 1160 1.28 740 1.05

Note: For total horsepower, 10% must be added for drive train losses.
Source: Structures and Environment Handbook, MWPS-1, Midwest Plan Service, |lowaState University,

Ames, lowa, 1987, Section 534.

Problem: What is the minimum size of auger that can be used to convey dry corn
at the rate of 500 bushels per hour when the auger isinclined 45°?

Solution:
Auger angle of elevation
Auger o° 45° 90°

Size RPM bu/hr hp/10 ft bu/hr hp/10 ft bu/hr hp/10 ft

4in 200 150 0.12 120 0.15 60 0.11
400 290 0.29 220 0.29 130 0.24
600 420 0.38 310 0.45 190 0.36

6in 200 590 0.38 500 0.44 280 0.32
400 1090 0.56 850 0.88 520 0.70
600 1510 0.84 1160 1.28 740 1.05

Using Table 20.1, the minimum size of auger is 6 inches.

TABLE 20.2. Screw auger capacity handling dry soybeans (12 inch exposure).

Auger angle of elevation
Auger 0° 45° 90°

Size RPM bu/hr hp/10 ft bu/hr hp/10 ft bu/hr hp/10 ft

4in 200 140 1.00 125 0.17 70 0.12
400 270 0.21 215 0.35 130 0.26
600 390 0.34 315 0.51 180 0.40

6in 200 500 0.40 360 0.57 220 0.40
400 990 0.84 690 1.20 390 0.79
600 1350 1.20 930 171 500 1.10

Note: For total horsepower, 10% must be added for drive train losses.
Source: Structures and Environment Handbook, MWPS-1, Midwest Plan Service, lowaState University,

Ames, lowa, 1987, Section 534.
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Another use of Table 20.1 and Table 20.2 is to determine the horsepower required
to operate the auger.

Problem: How much horsepower (including drive train) is required to operate a
100-ft, 6-inch auger, installed at 45°, conveying 690 bushel s of soybeans per hour?

Solution:
Auger angle of elevation
Auger o° 45° 90°

Size RPM bu/hr hp/10 ft bu/hr hp/10 ft bu/hr hp/10 ft

4in 200 140 1.00 125 0.17 70 0.12
400 270 0.21 215 0.35 130 0.26
600 390 0.34 315 0.51 180 0.40

6in 200 500 0.40 360 0.57 220 0.40
400 990 0.84 690 390 0.79
600 1350 1.20 930 171 500 1.10

Using Table 20.2, the power requirement is 1.2 hp/10 ft. It is important to read
the note at the bottom of Table 20.2. 10% must be added for drive train losses.
Therefore:

1.2hp

The horsepower required by the auger, including the drive train, is 13 hp.

20.5. Pneumatic Conveyors

Pneumatic conveyors are used to move grain and other products using air. Pneu-
matic conveyors are more flexible than augers because the duct does not need to
bein astraight line. They are self-cleaning, and do not have an exposed auger at
theinlet. They do require more horsepower per bushel and are noisier than augers.
Three types of pneumatic conveyors are used: positive pressure (push units), neg-
ative pressure (vacuum), and a combination of negative and positive pressure. In
apositive pressure unit, a blower supplies the pressure, and the product enters the
air stream through arotary air lock. The materia then is blown through the duct,
Figure 20.2.

In a negative pressure unit, the material is vacuumed up by the inflow of air
and then separated from the air in acyclone separator. The materia collectsin the
bottom of the separator where it can be rel eased with agate valve or arotary lock.
The air continues on to the pump and out through a filter into the atmosphere,
Figure 20.3.

In a combination system, the material is picked up by the inflow of a negative
pressure system, and then it passes through a rotary air lock into the positive
pressure air stream coming from the pump.
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FIGURE 20.2. Positive pressure pneumatic system.

FIGURE 20.3. Negative pressure pneumatic system.

20.6. Sizing a Pneumatic System

The capacity and the horsepower requirements of pneumatic conveyors depend on
eight factors:

. The horizontal distance that the material is moved.
. The diameter of the pipe.

. The vertical distance that the material is moved.
The number of bends in the pipe.

The elevation above sealevel.

. Thetemperature of the outside air.

. The type of material being conveyed

. The moisture content of the material.

ONOUAWNPRE

Tosizeapneumatic system the effect of each of thesefactorsmust beaccounted for.
Table 20.3 is an example of the type of information that is available for sizing
pneumatic systems. The data show that as the horizontal length (ft) of the pipe
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TaBLE 20.3. Pressure system conveyor capacities for dry corn (bu/hr).

Equivalent Length (ft)

Pipesize (in) Hp 50 100 200 250 300 350

3 10 450 400 350 320 295 265

4 15 650 575 500 460 420 380

5 25 1100 1000 900 830 755 685

6 40 2100 1950 1800 1650 1510 1370

8 75 4300 3900 3500 3220 2940 2660

10 100 5800 5100 4500 4240 3980 3720
Modifications to Capacity:

. Vertical pipe x1.20 = Equivaent horizontal length.

Capacity in wheat = 90% of Corn.

. Capacity in soybeans = 80% of Corn.

. Add 20 ft of equivalent horizontal pipe for each 90° bend in pipe.
. Reduce capacity by 4.0% for each 1000 ft above sealevel.
Reduce capacity by 2.0% for each 10°F above 70°F.

oA WNER

Source: Beard Industries, Frankfort, Indiana 46041.

increases the capacity of the system (bu/hr) decreases and as the pipe diameter
increases (in) the capacity increases.

To provide an easy way to estimate the amount of reduction caused by factors
3 and 4, the equivalent feet of pipe is determined. Equivalent feet of pipe is a
procedure that uses constants to determine the amount of horizontal pipe that will
cause the same reduction in capacity as the factor in question. For example, the
fourth modification to capacity listed in Table 20.3 showsthat each foot of vertical
pipe causes the same reduction in capacity as 1.2ft of horizontal pipe. Thus the
equivalent feet for a vertical section of pipe is determined by multiplying the
vertical length (ft) by 1.2.

Adjustmentsfor factors 5 through 8 are handled differently. The capacity of the
system is adjusted for the effect of factors 5, 6, and 7 by reducing the capacity and
appropriate percentage. Factor 8 is accounted for by either assuming a standard
moisture content, or developing a separate table for arange of moistures.
Expressed as an equation:

TEF = (Fy + Fs + )

where: TEF = Total equivalent feet, Fy = Horizontal distance (ft), Fg = Equivalent
feet for bends, Fy = Equivalent feet for vertical sections.

Problem: What is the capacity of the system in Figure 20.4 if the material to be
moved is dry soybeans?

Solution: Thefirst step isto determinethetotal equivalent feet for the pipe. Inthis
example, factors 1, 2, 3, 4, and 7 are used. Note: the last section of pipe does not
have alength dimension because the assumption is used that the force of gravity
exceeds the resistance of the pipe. Therefore, vertical down sections of pipe are
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FIGURE 20.4. Pressurized conveyor for sample problem.
not included.
TEF=(F4+ Fs + Fv)

20ft
= ((250ft + 10ft) + <3 bends x ﬁ) + (20ft x 1.2)) = 3441t
Although the actual length of pipe in Figure 20.4 is 280 ft, because of the bends
and the vertical up sections the equivalent distance is 344 ft.

The next step isto use Table 20.3 to determine the capacity of an 8.0 inch duct
with an equivalent distance of 344ft. The closest value is 2660 bu/hr. Note that
Table 20.3 gives values for corn. Because the capacity of a pressurized system for
soybeansis 80% of the capacity for corn (modification 3), the system capacity in
Figure204is:

bu bu bu

Pl Z’GGOW x 0.80 = 2’100W
Information to determine the capacities of auger, pneumatic, and bucket conveyor
systems for other crops and situations are available from manufacturers and agri-
cultural extension personnel.

20.7. Moisture Management

Water and its addition to or removal from agricultural products and materiasis
an extremely important topic in nearly al aspects of agriculture. The moisture
contents of grain, feed, or hay to be bought or sold, of crops to be dried, or of
meat and dairy productsto be processed are but afew examples of products where
moisture must be carefully managed. Moisture may be added to or removed from
the product depending upon the desired final condition. Moistureisremoved from
products by drying. Drying usually is done to change the consistency or to extend
the storage life of the product. For example, fruits and meats may be dried to
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change the way that they are handled, stored, and eaten. Grains and forages are
dried to extend their storage life.

Some agricultural products, such as grains and forages, will dry naturaly to
equilibrium moisture content (the same as that of the environment) if left in the
field. But with these and other products good management sometimes dictates that
the crop be harvested at a wetter stage and dried artificially. Artificia drying is
accomplished by causing natural or heated air to flow around and/or through the
product. Artificially heated air is often used, because heating reduces the relative
humidity of theair, increasing the amount of moisture each pound of air can absorb.

The management of adrying system requiresthe ability to be ableto predict the
amount of moisture that must be removed from the product. For other products,
it isimportant to be able to predict the amount of water that must be added. The
following discussion presents a method for determining the amount of moisture
that must be added to or removed from biological products.

The moisture content of a given material is stated as a percent using either the
wet-weight or the dry-weight basis. Because moisture content is expressed as a
percent, we know that aratio is involved. The difference between the wet-weight
basisand the dry-weight basisisthe value used in the denominator of theratio. The
wet-weight basis uses the weight of the product as it is received; the dry-weight
basis uses the oven-dry weight (dry matter) of the product.

Study Figure 20.5. Thetotal weight of the product is4 pounds. When the amount
of water is expressed on the dry-weight basisitis:

11b water
3 1b dry matter
Expressed on the wet-weight basis, the amount of water is:

1 lbwater
4 |btotal

These relationships are explained in the following equations:
Dry-weight basis:

x 100 = 33%

x 100 = 25%

WW — DW
%MDB = (4> x 100

DW
Wet-weight basis:

ww

where %MDB = Percent moisture, dry-weight basis, %MWB = Percent moist-
ure, wet-weight basis; WW = Wet weight or weight of product before drying;
DW = Oven-dry weight, or weight of product after drying; WW — DW = Weight
of moisture removed.

Itisimpractical and often undesirable to remove all of the moisture from grain
as well as many other products. Grain usually is considered to be dry when the
moisture content is sufficiently low to discourage the growth of molds, enzymatic

WW — DW
%MWB = (7> x 100
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FIGURE 20.5. Dry-weight, wet-weight basis illustration.

action, andinsects. Thisisusually about 12% moisture content, %M DB, depending
upon the grain. Standards have been established to determine the heating time and
temperature required to obtain an official oven dry sample of grain.

Either moisture content basis may be used with agricultural products; soto avoid
confusion or misunderstanding, the basis being used should always be specified.
This can be accomplished by writing the numerical value of the moisture content
followed by %MDB or %MWB.

Problem: Expressthe moisture content on thewet-weight basisand thedry-weight
basis for a product that weighs 150.0 pounds when wet, and after drying weighs
80.0 pounds.

Solution: Wet-weight basis:

WW — DW 1501b — 80.01b
9MWB = [~ ) 100 = (P g
° < WW )X 00 ( 1501b )X 00

= 46.666 ... or 46.7%

On the wet-weight basis, the product is 46.7% moisture.
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Dry weight basis:

WW —DW\ . (1500lb— 80.0lb
DW = 80.01b

On the dry-weight basis, the product is 87.5% moisture.

Notice that the only difference in the values used in the two equationsisin the
denominator of the ratio. For the DW basisthe dry weight isused, and for the WW
basis the wet weight is used.

One aspect of the DW basis is that the percentage of moisture can be greater
than 100%. For example, if a product has a wet weight of 100 ounces and a dry
weight of 40 ounces, the MWB is 60% and the MDB is 150%. This is why the
standard moisture of many productsis given on the wet-weight basis.

%MDB = < ) x 100 = 87.5%

20.8. Adding or Removing Water

During the life of many products it may be necessary to remove or to add water.
Grain must bedried for storage, and the same grain may have to betempered (have
water added) for processing. Water may be added to or removed from products
such as catsup to produce the desired consistency, and so on. The dry-weight and
wet-weight bases equations also can be used to determine the amount of water to
put into or take out of any biological product.

The calculations for determining how much water to add or remove requires
three steps, and they must be completed in the correct sequence:

1. Determine the dry weight of the material at its origina state. The weight of the
dry material does not change from one moisture content to another; moisture
may be added or removed, but the amount of dry matter or the dry weight
remains the same.

2. Using the dry weight that was determined in step one, solve for the new wet
weight (the weight of the material at the new moisture content).

3. Theamount of moistureto add or to removeisthedifference between theweight
of the product in the original state and the new wet weight.

To solvefor the dry weight or the wet weight, the wet-weight basis and dry-weight
basis equations are rearranged. Thefirst two equations are used when the moisture
ison thedry-weight basesand the second two equations are used when the moisture
is on the wet-weight basis.

Dry-weight basis:
WWwW
DW = 1, MDB,
100
%MDBg
WW,=DW x [ 1+ 100
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Wet-weight basis:

0,
DW = Ww x (1— ZMWB,
100
DW
WWan = | YMWBe
100
The subscripts n = new, e = ending, | = initial.

The following problems illustrate the uses of these equations.

Problem: How much water needs to be removed (Ib) to dry 1,000.0 pounds of
product at 70.0% MWB to 20.0% MWB?

Solution: Three step process.

Step one: Because the moisture has been measured by the wet-weight basis, the
second two equations must be used. Start by solving for the dry weight of the
product.

%MWB,
= 1,000.0 x 0.30 = 3001b

70.0%
DW:WWx(l— - OO°)

100

Step two: Solve for the new wet-weight at the desired moisture content.

DwW 3001b
WW, = . %MWBL — . 5006 = 3751b
100 100

Step three: Theamount of water that needsto be removed isthe difference between
the initial wet weight (WW,) and the new wet weight (WW¢g). Thus the amount
of water (Ib) that must be removed is:

Ib water = WW, — WW, = 1,0001b — 3751b = 625Ib

To change the product from the original 70% MWB to 20% MWB, 625 pounds of
water must be removed.

Problem: A miller needs to raise the moisture content of 1,000 bushels of wheat
from the storage condition of 9.0% MDB to 16.0% MDB. How much water (Ib)
needs to be added?

Solution: Step one: Use the dry-weight equations and the conversion value of 1
bu = 60 Ib to solve for the pounds of dry matter:

60 Ib
1,000 bu x ——
oww b bu _ 60,0001b
DW(Ib) =——g = e = 109 = 55045.871. . Ib

100 + 100
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Step two: Determine the weight of the product at the new wet weight

%MDB
100

WW, = DW x (1 +
16.0%
100

Step three: Determine the water to add. Because this problem is an example of
adding water, the initial weight is subtracted from the new wet weight.

[bwater = WW, — WW,; = 63, 853.212101 Ib — 60,000 = 3,853.212. .

= 55,045.87156 b x (1 + ) =63,853.212.. b

or 3,800 b water

The miller should add 3,800 pounds of water to the wheat to bring it up to 16%
MDB.

On occasion it is useful to know how to convert from one moisture basis to the
other. This can be accomplished with the following equations:

100 x %MWB
¥MDB = 150 —oamwB
oenwis _ 100X %MDB
0 ~ 100 + %MDB

Problem: Determine the percent moisture, dry basis, (%MDB) of aproduct if the
percent moisture, wet basis, (%MWB) is 50%.

Solution:

100 x %MWB 100 x 50% 5,000
100 —- %MWB ~ 100 — 50% 50

Problem: Determine the percent moisture, wet basis, (Y%oMWB) of a product that
is23.25% moisture, dry basis, (MDB).

Solution:

%MDB = = 100%

100 x %MDB 100 x 23.25

%MWB = -
0 100+ %MDB _ 100 + 23.25

= 18.864 ... or 18.86%

20.9. Storage of Biological Products

Theterm biological products has been used throughout this chapter because prod-
ucts such as grains, fruits, and vegetables are living organisms. Because they are
alive, there are minimum requirements for moisture, temperature, and air to main-
tain their viability; but the life of the product can be extended if the temperature
or moisture or air is modified during storage. The challenge for managers of many
such products is to extend the storage life of the product without damaging its
viahility, color, taste, or texture. Recommendations for optimum environments for
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the storage of biological products can be obtained from the extension service or
any department of agricultural engineering.

20.10. Metric Problems

The auger and pneumatic capacity problems are worked the same. The only dif-
ference is using the appropriate valuesin Sl units.

Adding and removing of water from products uses the same equations, the
differenceis using units of massinstead of weight.

Problem: How much water (kg) must be removed from 1.2 metric tons (t) of grain
to lower the moisture from 14.5 to 11.0%DB?

Solution: Three steps
Step one: Determine the dry mass.

WW, 12t 1000kg _ 1200
DWike) = L %MDBY T TS5t T 11
" 100 100
= 1048.03 ... kg

Step two: New wet mass.

%MDBg 11.0
WW, =DW x ( 1+ =104803 --- x {1+ —

100 100
=1163.31... kg
Step three: Subtract original and new wet mass.
1,000k
Water (kg) = WW, — WWEg = <1.2t x = g) —1163.31...

=36.68 ... or 36.7 kg
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Animal Waste Management

21.1. Objectives

1. Understand the importance of animal waste management.

. Be able to describe the methods of handling solid animal waste.

3. Be able to determine the maximum amount of solid animal waste that can be
applied to the soil.

. Be able to describe the methods of handling liquid animal waste.

. Be able to determine the capacity of storage units for animal waste.

. Be able to describe animal waste treatment methods.

N

(02042 IF N

21.2. Introduction

When animals are free ranging “dilution is the solution to pollution.” Animals
that range freely tend to distribute their waste over a large area and the natural
processes disseminate the waste. When animals are confined the waste is concen-
trated in one spot and it becomes part of the management of the animals. Animal
waste management is no longer an option in a livestock business; it is a require-
ment. A plan for the collection and disposal of animal waste must be part of any
livestock facilities plan. Failure to provide adequate waste management collection
and storage facilities, and disposal equipment can lead to pollution problems with
legal complications, animal health problems, increased production costs, and a
generally undesirable working conditions. In most states, confinement operations
must have a comprehensive nutrient management plan. There are three aspects of
animal waste management:

1. Waste handling
2. Waste treatment
3. Waste disposa

When the decision is made during the planning process, the producer can choose
from a variety of waste handling, treatment and disposal systems to manage the
animal waste. Selecting a system after the facility has been built limitsthe options.
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280 21. Animal Waste Management

21.3. Handling Solid Animal Waste

Waste containing 20% or more solids or with a moisture content of 50% MWB or
lessisconsidered to be solid waste. Proper handling of solid waste inside buildings
requires solid floors that can be bedded or drained. The waste is collected and
usually is not treated except by the natural processes, asit is stored. The preferred
method for waste disposal is mimicking the natural system—spread it on the land.
If not done correctly, disposal of solid animal waste on the land can reduce plant
production, produce offensive odors, and contributeto the contamination of ground
and surface water. The NRCS" has devel oped standards for the application of solid
animal waste on land. These standards are based on soil type, slope, and distance
from surface and ground water. The general standards are:

1. No application to frozen or snow covered soil when slopeis greater than 5%
unless special provisions are made to control runoff.
. No application to cropland that exceeds soil 10ss tolerances.
. No application on any cropland with slopes greater than 15%.
. No application within 200 ft of wells, sinkholes, or surface water.
. Liquid cannot be applied to soilswith lessthan 10inchesof at |east moderately
permeable soil.
. No application on organic soils with seasona water table within 1 ft of the
surface.
7. No application on flood plains where flooding occurs more frequent than once
in 10 years.
8. Application can occur on flood plains if the injection or immediate incorpo-
ration method is used.
9. No intentional application on established waterway or any area where there
many be concentrated water flow.
10. No more than 25% of the surface may be covered.
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Failureto follow these standards can cause contamination of the ground or surface
water and the possibility of fines or litigation.

Note: Different computer programs are available to help producers calculate the
amount of livestock waste that can be applied. The manual process explained in
the following sections shows the steps and types of information required to use
one of the computer programs.

For accurate results, the first step in determining the amount of solid animal
waste that can be applied to the soil isto analyze both the solid waste and the soil
for the amounts of nitrogen and phosphorous they contain. If the waste has not
been tested, Appendix VI may be used to estimate the nutritional content. These
values are estimates because the animal’ s ration, the type and quantity of bedding
used, the amount of liquid added, the type of housing and manure handling system,
and the storage system all affect the nutrient content of the animal waste.

1 Waste Utilization, Code 633, Natural Resources Conservation Service, 2002.
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When the nutritional content of the soil isunknown, it must be estimated before
AppendixesV1 (Solid Animal Waste Production and Characteristics), VII (Nutrient
Utilized by Crops), and VII1 (Maximum Annual Application Ratesfor Phosphates
Based on Soil Family) can be used to determine the amount of waste that may be
applied.

The primary governing principlefor the application of solid animal wasteisthat
no more nutrients can be applied in the soil than what will be removed from the
fieldin cropsor animal weight. Itisunlikely that the amount of each nutrient inthe
waste can be matched with the needs of the plants; so the nutrient with the most
restrictive amount determines the maximum amount of waste that can be applied.
Note: This method assumes that more than one application per year will be used
to distribute the total amount of waste.

The steps in calculating the amount of waste that can be applied are:

1. Determine the amount of nutrients produced per day, Appendix VI.

2. Calculate the pounds of nutrients per pound of waste.

3. Determine the amount of nutrients used for the expected crop, Appendix VII.

4. Determine the maximum amount of phosphorous for the soil type,
Appendix VIII.

5. Calculate the pounds of waste that can be applied.

Problem: Determine the amount of solid waste from 1,000 Ib dairy cows that can
be applied to a coarse loamy soil with a pH of 6.5 that will be used to raise 60
bushels per acre of wheat. Note: In this example we will assume that there are no
nutrientsin the soil.

Solution: In this type of a problem atable is useful for determining the answer,
for example Table 21.1. First, determine the amount of nutrients in the waste and
the maximum amounts of phosphorous and nitrogen that can be applied. Thisis
accomplished by selecting the correct values from Appendixes VI, VII, and VIII,
and converting them to pounds of nutrient per pound of waste. From Appendix VI
the nutrients produced per day are:

Ib
Nit N) =014 —
itrogen(N) =0 day

Ib
Phosph P)=0.27 —
osphorous (P) day

Each cow produces 82 |b of waste per day, Appendix VI. The pounds of nutrient
per pound of waste can be calculated using units cancellation:

Ib of nitrogen  0.141b N 1day IbN
= X =017E-3
Ib of waste 1 day 82 |b waste Ib waste
Ib of phosphorus  0.271b P 1day IbP

= =0.003290r 3.3E—-3
Ib of waste 1 day x 82 |b waste o Ib waste
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TABLE 21.1. Solution to problem.

Soil limits ~ Net nutrients used Pounds of nutrient per Application rate of

Nutrient (Ib/ac) by crop (Ib/ac) pound of waste (1b/1b) waste (Ib/aclyr)
Nitrogen — 125 1.7 x 1073 7,400*
Phosphorous — 50 33x10°8 15,000
Phosphorous 400 — 33x10°8 120,000

125IbN  1lbwaste
lac < 17E—3IbN
501bof P 11b waste
lac 33E—3IbP
4001bP  1llbwaste
lac  33E—3IbP

*Application rate = = 73529.41 or 7,400 |b

**Application rate = =15151.51... or 15,000 Ib

**Application rate = =121212.12... or 120,000 Ib

The next step isto use Appendix V11 to determine the nutrients used by the crop:

Nitrogen = 125 Ib/ac
Phosphorous = 50 Ib/ac

Thelast information needed to find the solution is the maximum amount of phos-
phorous that can be applied to the soil based on soil type. Consult Appendix V1|
for thisinformation:

Phosphorous = 400 Ib/ac

The solution is found by calculating the application rate (Ib/ac/yr) of waste for
each nutrient. The maximum amount of waste that can be applied is determined
by the smallest of three values: the nitrogen used by the plant, the phosphorous
used by the plant, and the phosphorous that can be applied to the soil. The results
are shown in Table 21.1.

Table 21.1 shows that nitrogen is the most restricted nutrient (7,400 Ib/ac/yr).
Therefore, the maximum amount of waste from the dairy cowsthat can be annually
applied is 7,400 Ib per acre per year.

In the previous sample problem, the nutrients available in the soil were not
considered. The actual amount of waste than can be applied is the difference
between the nutrients used by the crop and theamount of nutrientsalready available
in the soil.

Another aspect of solid waste management is determining how many acres are
required to dispose of the waste being produced.

Problem: How many acres will be required to distribute all of the waste from a
50-cow dairy? Use the cows in the previous problem.

Solution: The answer to this question can be found by using the 7,400 Ib of
waste per acre per year from the previous problem, additional information from
Appendix VI, and units cancellation. Appendix VI shows that each 1,000 |b dairy
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cow produces 82.0 Ib of waste per day. Then:

lac 82.0 Ib waste
&= 7a00bwaste * cow —day 50 cows x 365 days
1496500
7,400

=202.22... or 202 ac

For the 50-cow dairy herd, aminimum of 202 acres are required to dispose of the
animal waste each year. It isimportant to remember that in the original problem
we assumed that the soil contained no nitrogen or phosphorous. Any nitrogen or
phosphorous in the soil reduces the amount of waste that may be applied and
increases the number of acres required.

21.4. Handling Liquid Waste

Handling of liquid or slurry waste from buildings involves scraping or flushing
the waste from where it is dropped by the animal to a pit or a storage tank. Once
collected, the waste is treated and/or disposed. Open feedlot waste is handled as
runoff-carried waste, with natural precipitation carrying the liquid or the slurry,
flowing from the pensinto adrainage and collection system for subsequent removal
or treatment and disposal. Liquid waste usualy is handled by pumping, and is
disposed of by being spread on the surface of or injectedinto the soil. Themaximum
amount of waste that can be spread in liquid form is determined by using the same
procedure as that used for solid waste.

Liquid wasteis more difficult to manage than the solid because it must be stored
intanks or pits and must be pumped. In addition, because animal waste should not
be spread on frozen ground, the storage unit must have the capacity to store all of
the waste while the ground is frozen.

Problem: What size of above ground tank (gal) isrequired to store al of thewaste
from a 100-sow farrowing barn if the pigs are with the sows, and the waste must
be stored for 6 weeks?

Solution: Using Appendix VI and units cancellation (Note: weights can be con-
verted to volumes if the density is known):

gal — 1ga y 13 y 33.01b X?.Odayx6weeksx 100 sows
0.13368ft3 ~ 60.0lb = day —sow = 1week 1 1
138600
~ 8.0208

= 17280.07... or 17,300 gd

An additional problem that arises using liquid waste is the space required for the
storage tank.

Problem: How high will a round tank be in the previous problem if the space
available for the tank is 20.0 ft in diameter?
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Solution: Thisisagood problem to use the units method.

0.13368ft> 17,300 gal 1
=" 1 “ax@on?
P4
2312.664
~ 314.159...

= 7.3614... or 7.36ft.

21.5. Waste Treatment

Waste treatment is an operation performed on waste that makes it more amenable
to ultimate disposal. Two basic methods of biological treatment are used: aerobic
and anaerobic.

21.5.1. Aerobic Treatment

Aerabic treatment occurswhen thereis sufficient dissolved oxygen availableinthe
waste to alow aerobic bacteria (oxygen-using) to break down the organic matter
in the waste. It is essentially an odorless process. Three methods of treatment that
use aerobic bacteria are: composting, aerobic lagoons, and spray-runoff.

Composting is accomplished by piling the waste and turning it frequently to
provide aeration for aerobic bacterial decomposition while maintaining a high-
enough temperature in the pile to destroy pathogenic organisms and weed seeds.
The volume of composted waste may be reduced to between 30% and 60% of the
volume of the original waste.

An aerobic lagoon is a relatively shallow basin (3 to 5 ft deep) into which
a durry is added. The decomposition of the organic matter is accomplished by
aerobic bacteria. Beating or blowing air into the liquid provides oxygen for the
bacteria and accel erates the process.

In the spray-runoff treatment, an areais leveled and sloped so that water flows
evenly, and then is planted to grass. The bacteriathat live on the wet surface of the
grass and soil accomplish decomposition of the waste.

21.5.2. Anaerobic Treatment

Anagerobic treatment is accomplished by anaerobic bacteriathat consume the oxy-
gen in the organic matter itself as the organic matter decomposes. In this process,
odorous gases are produced. The most common method using thistreatment isthe
anaerobic lagoon.

Theanaerobiclagoonisarelatively deep (12 ft to 14 ft) basinthat containsliquid
waste and provides a climate for decomposition by anaerobic bacteria. Thus, no
attempt is made to introduce oxygen into the liquid. The anaerobic lagoon is able
to decompose more organic matter per unit of volume than the aerobic lagoon.
However, the odor it produces may determine where it can be located.
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21.6. Metric Problems

The principles of animal waste handling treatment and disposal arethe samein S
units. The only differencesin the problems are the units that are used.

Problem: Determine the amount of solid waste from 91 kg finishing pigs that can
beappliedto acoarseloamy soil withapH of 6.5 that will beusedtoraise5.0 cubic
meters per hectare of wheat. A soil test reveals 35.3 kg of nitrogen and 15.0 kg of
phosphorus per hectare available for the plants.

Solution: Thefirst stepisto use Appendix VI to determine the amount of nitrogen
and phosphorus produced by the animals. Note: Sl values in Appendix VI are
direct conversions.
Nitrogen = 0.0305 kg/day
Phosphorus = 0.0204 kg/day

The next step is to determine the pounds of nutrients per pound of waste.

kg of nitrogen _ 0.0305 kg, " 1day —0.005169. . or 0.0052 kg of nitrogen
kg of waste 1 day 5.9kg,, kg of waste

0.0204 k
kg of phosphorous _ Op » 1 day —0.003457 . or 0.0034 kg of phosphorous
kg of weight 1 day 5.9kg, kg of waste
The next step isto determine the net amount of nutrients needed by the crop. This
is determined by subtracting the nutrients available in the soil from the nutrients
used by the crop, Appendix VII.

kgN 140kgN 353kgN kg N
= — =104.7 ——
ha ha ha 04 ha
kgP  56kgP 15kgP_40kgP
ha  ha ha ha

Thelast step isto determine the kilograms of waste that can be applied per hectare.
Thisis determined by multiplying the net nutrients used by the crop by the kilo-
grams of nutrients per kilogram of waste.

kgwaste  1kgwaste 104.7kg N kg waste

Nitrogen waste: ha  ~ 0.0052kg N X a =20134.61... or 20,000 ha
kgwaste  lkgwaste = 40kgP kg waste
Phosphorus waste: ha  ~ 0.0034kg P e = 11764.7 ... or 12,000 ha
Lo kgwaste 1kg 448kgP kg waste
Phosphorus sail limits: ha  ~ 0.0034kg P e 131764.7 ... or 130, 000 ha

The least amount (kg/ha) is 12,000 for the phosphorus in the waste. This sets
the limits of 12,000 kg of waste per hectare per year that can be applied.
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| nsulation and Heat Flow

22.1. Objectives

1. Understand the principles of insulation and heat flow.

2. Understand the function of insulation.

3. Understand R-values and U-values.

4. Beableto calculate the total thermal resistance of a building component.

5. Beableto determine the amount of heat flowing through abuilding component.

22.2. Introduction

All living organisms have a preferred environment. Whenever the environment is
not within the preferred parameters, the organism is stressed. Stress can reduce
productivity, increase the incidents of illness, shorten the storage live of products
and cause many other problems. Inthe natural environment, organism modify their
environment by moving from one location to another. Once animals and other
organisms are confined, they cannot roam, and the environment must be modified
to meet their needs. Two ways environments are modified are heating and cooling.
Heat isaform of energy. It istransmitted in three different ways:

1. Radiation—the exchange of thermal energy, heat, between objects by electro-
magnetic waves.

2. Convection—the transfer of heat from or to an object by a gas or a liquid by
movement of the gas or liquid.

3. Conduction—the exchange of heat between contacting bodies that are at dif-
ferent temperatures.

The movement of heat by radiation and convection is more difficult to calculate
than conduction. Conduct heat losses will be explained in more detail to illustrate
thefactorsthat influencethe amount and rate of heat movement. The amount of and
rate of conduction heat movement is controlled by the areathrough which the heat
passes, the difference in temperatures, and the thermal resistance of the materials.
These concepts and others will be discussed in this chapter. Latter sections will
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show that the greater the area, the greater the heat flow. A similar relationship
exists for temperature. The greater the temperature difference the greater the heat
flow. The thermal resistance of materials is primarily dependent on the density
of the material. A material with many small, trapped air spaces will have higher
thermal resistance. A material with high thermal resistanceis called insulation.

22.3. Insulation

Insulation is any material that reduces the rate of heat transfer by conduction.
All building materials have some resistance to the movement of heat, but some,
insulation, are more resistant than others. A common characteristic of insulation
materials is low density (pounds/cubic foot, kilogram/cubic meter). Expanded
polystyrene, which hasalow density, hasahigher thermal resistancethan concrete,
which has a very high density. Also, as the density of a material increases, for
example, by compressing the material or adding water, the thermal resistance is
reduced.

Some materials, such as wood, concrete, and certain insulation materias, are
homogeneous; that is, they have a uniform consistency throughout. For these
materials the insulating values are listed as per inch of thickness, Appendix 1X.
Other materials such as concrete blocks and insulation backed siding are not
homogeneous. They may have holes in them, or they may be composed of more
than one type of material. The insulating value of these materials is based on a
thermal test of asample, Appendix X, and adifferent value must be used for each
different thickness.

There are three common reasons for insulating houses and other structures,
Figure 22.1 and Figure 22.2.

(2) Insulation reducesloss of heat inside any type of enclosure during the winter
months, reducing the amount of supplemental heat required to maintain the tem-
perature of the enclosure; (2) insulation helps reduce heat gain during the summer
months, reducing the load on cooling equipment, Figure 22.1 and (3) insulation
is used to manage the condensation point so that it does not occur within the

FIGURE 22.1. Advantages of insulation for reduction of the loss of heat in the winter or
grain of heat in the summer.
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FIGURE 22.2. Adeguate insulation prevents moisture condensation during the winter.

wall or on the inside surface, Figure 22.2 Condensation is the transformation of
water vapor to aliquid, which occurs when warm moist air is cooled or comesin
contact with a cool surface. Condensation is explained in more detail in the next
chapter on psychrometrics. Condensation may occur on the outside surface of a
wall, Figure 22.2, or on any surface inside the wall if no vapor barrier is used and
theinsulation isinadeguate for the temperature difference.

22.4. R-values and U-values

Two different numbers are used to describe the insulating properties of construc-
tion materials: R-values and U-values. The R-valueisanumber that representsthe
thermal resistance of amaterial. The U-valueisameasurement of the thermal con-
ductivity of amaterial. Inthe customary units, aU-value of 1 meansthat 1 BTU/hr
of heat will flow per square foot of area per degree difference in temperature on
each side of the material. Theterm BTU standsfor British Thermal Unit, andisthe
amount of heat required to raisethe temperature of 1 1b of water 1 °F. Inthe S unit
system, the preferred unit for heat iskilojoules. A jouleisequal t09.478 E—4BTU
and isthe amount of heat required to raise the temperature of 1 g of water by 1°C.

R-values are the inverse of the U-value (R = 1/U). Therefore, the insulating
ability of a materia increases as the R-value increases and as the U-value de-
creases. The R-value of a nonhomogeneous building component is the sum of
the R-values of the materials that make up the component. The nonhomogeneous
material may be a construction component such as a concrete block, or a part of
the building such as a wall or ceiling. The units for U are 212+ of =57
where A, is the unit area of the material through which the heat passes (gener-
aly in ft? or m?). Since the units of R are the inverse of the units of U, the units
of R are -FXAu or “CxAuh Appendix X contains R-values for some common
homogeneous and nonhomogeneous building materials.

Thetype of construction and thetypeand amount of insulating material used will
determine the rate of heat flow (British Thermal Units'hr, customary, or Joules/hr,
Sl) for aparticular building or building component. Common building components
includewalls, doors, windows, floors, ceilingsand roofs. Knowledge of therel ative
insulating val uesof different construction materialsand of how to put themtogether
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FIGURE 22.3. Typica wood framewall construction
viewed looking down.

to estimate the overall insulating value of a building or a building component isa
great help in selecting appropriate insulation materials for a particular application.

To determine the total thermal resistance of awall, simply list and add together
thethermal resistance of theindividual parts. For homogeneous materials, thetotal
thermal resistance value is determined by the thickness (inches) of the material
used times the R-value per inch of thickness. For nonhomogeneous materials,
select the thermal resistance value for the thickness of material specified.

Two additional factors are important in determining the total thermal resistance
of awall. Thefirstisthethermal resistance associated with the layer of till air next
toany surface, aswell asany air spacewithinthewall, floor, or ceiling. Still airisa
good insulating material, and athin air film clingsto exterior and interior surfaces
providing a measurable thermal resistance. Typical R-values for the inside and
outside air film are found in Appendix 1X. The second factor is an understanding
of common construction methods. In wood frame construction, the walls usually
are made from 2 x 4 or 2 x 6 inch lumber. Lumber is sold using nominal sizes,
theactual sizeisless. A 2 x 4isactually 1 and 1/2 inches by 3 and 1/2 inches, and
a2 x 6isactualy 1 and /2 inches by 5 and 1/2 inches. Frame walls usually are
constructed with the long dimension of the board perpendicular to the wall, with
different material s attached to both sidesto form the wall. The cavity between the
surfaces may befilled or partialy filled with insulation, see Figure 22.3.

Problem: Determinethetotal thermal resistance (Rt) of a2 x 4 wood framewall.
The outside is covered with 1/2 inch medium-density particle board, vapor barrier
is permeable felt and 2.5 inches of 100 Ib per cubic foot fired brick. The inside
surfaceis 1/2 inch plasterboard. The wall isfilled with medium-density, |oose-fill
cellulose.

Solution: The R-value of the wall is the sum of the R-value of each component.
For this type of problem, a diagram of the wall and a table of the information
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FIGURE 22.4. Solution to total thermal resistance problem.

will help prevent mistakes. Study Figure 22.4 for the solution. The R-values were
obtained from Appendix 1X.

For this particular wall the total thermal resistance (Ry) is 15.34. Note: Because
loosefill insulation is used, the thickness of theinsulation is equal to the cavity in
thewall, 3.5 inches. When a batt type of insulation isused, and it is not asthick as
the wall, the wall will aso have an air cavity or void, the R-value for two inside
surfacesisused if theair cavity islessthan 3/4 inch. For example, if the insulation
in the wall in the pervious problem is 3.0 inch of low density batt insulation, then
the Ry is12.71, Table 22.1.

Thetype of sametable and procedures can be used to determinethetotal R-value
for any building component. Simply sum the R-values for each type of materia
and the inside and outside air films. Note: some sources of R-values include the
air film values with the material.

Problem: What is the total R-value (Rt) for a ceiling constructed of 1/2-inch
plywood for the inside surface with 6.0 inches of low density batt insulation on
top of the plywood?

Solution: This problem presents a different situation because neither surface is
exposed to outside conditions. In buildings with very low attic ventilation the

TABLE 22.1. Solution for
insulation problem.

Inside air film 0.68
Plaster board 0.45
Batt (3.0 R/in x 3.0inch) 9.00
Cavity (0.68 x 2) 1.36
Particleboard 0.53
Felt 0.06
Brick 0.50
Outsideair film 0.17

Total 12.75
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FIGURE 22.5. Solution to ceiling total resistance problem.

R-valuefor insideair film should be used on both sides of the ceiling. If the atticis
well ventilated, an outside air film R-value would be appropriate. For this problem
the assumption is that the attic is not well ventilated.

In this example the total R-value of the ceiling is 20.98, see Figure 22.5. One
area of a building that is more difficult to determine a total thermal resistance is
thefloor. A concrete slab floor on the ground does not have a uniform temperature
gradient across the floor. The insulating properties of the ground will cause the
temperatures between the inside space and the ground at the center of the floor
to be different from the edges. The values for insulated and un-insulated floorsin
Appendix IX are estimates.

22.5. Heat Flow

The rate of heat flow (BTU/h) through a building component depends upon the
thermal resistance of thewall, the temperature difference on both sides of thewall,
and the area of the component. Expressed as an equation:

_AXAT

Q R

where Q = Heat flow rate (BTU/h); A = Area of building component (ft?);
AT = Environmental temperature difference on each side of structure (°F);
R = Total thermal resistance of the building component (52w ).

Heat flowsfrom the area of higher temperature to the area of lower temperature.
With the inside temperature greater than the outside temperature, the heat flow

will be from inside to outside.

Problem: Determine the heat flow for an 8.0 x 10.0 ft wall with atotal R-value
of 1.22 and is subject to an inside temperature of 60°F and an outside temperature
of 10°F.
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Solution:
Q= Ax DT (8.0ft x 10.0ft) x (60°F — 10°F)
- R - 2 o
122 ft* x°F x h
BTU
BTU

= 3278.68...0r 3,300 e

Heat will move through thiswall at the rate of 3,300 BTU/h.

The heat flow rate for all building components except floors can be calculated
by using this method. If the floor is a concrete slab, the difference in temperature
(AT) across the floor will change as one moves in from the outside edge of the
building. The effective R-values for this type of floor or a concrete slab floor with
insulation beneath it can befoundin Appendix | X. When either of thesetwo values
is used, the perimeter of the building (ft) is substituted for the area (ft?) in the heat
flow equation. If afloor has a crawl space underneath it, the total R-value can be
calculated by using the same procedures used for aceiling. Floors over basements
are much more complex and will not be discussed in this text.

With the information presented in the previous sections the total conduction
heat flow for abuilding can be determined. The processfor completing atotal heat
flow calculationisincluded in alater chapter because total building heat flow must
aso include heat lost or gained through ventilation.

22.6. S| Problems

Problem: Determine the heat flow for an 2.5 x 3 m wall with a total R-value

of 6.93 % and is subject to an inside temperature of 16°C and an outside

temperature of 12°C.
Solution:
A x AT 25 3.0 16°C — 12°C kJ
Q= AxAT _(25mx30m)x( ) _ 3030 or303
R 6.93 m? x°C x h h
' kJ

Heat will move through thiswall at the rate of 30 kJ/h.
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Heating, Ventilation, and
Air-Conditioning

23.1. Objectives

. Understand the principles of heating.

. Be able to determine a heat balance for a building.

. Beableto list and define the seven physical properties of air.

. Giventwo propertiesof air, beabletofind the other propertieson apsychometric
chart.

. Beableto calculate a ventilation rate.

. Understand the principles of air-conditioning.
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23.2. Introduction

Air is a complex mixture of gases, water vapor, and heat. All living organisms
require these three components, but not necessarily in the same proportions. Each
organism has an optimum range of all three conditions, and any timethe conditions
arelessthan optimum, the organismis stressed. Management of these components
may be critical within agricultural structures. Heating, cooling, and ventilation
are used to modify the natural environment to reduce the environmental stress of
animals and biological products.

The ability to manage building environments is based on an understanding of
psychrometrics. Psychrometrics is the study of moist air. The constituents of air
and their manipulation are easier to understand using a psychometric chart. The
following sections explain the psychometric chart and provide examples of how it
is used for heating and ventilation.

23.3. Psychometric Chart

A psychometric chart isagraphical representation of the seven physical properties
of air. These physical properties are defined and described as follows:
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1. Dry-bulb temperature (dbt): The dry-bulb temperature isthe temperature of air
measured with a standard thermometer. Dry-bulb temperatures (and all other
temperatures) usually are expressed in degrees Fahrenheit (°F) with customary
units or degrees Celsius (°C) with Sl units.

2. Wet-bulb temperature (wbt): The wet-bulb temperature is determined with a
standard thermometer having the bulb surrounded by gauze or a sock and a
means for keeping the sock wet. Asair passes over the wet sock, it will absorb
(through evaporation) some of the water from the sock, cooling the bulb of the
thermometer. The drier the air is, the greater the evaporation and the greater
the cooling effect. The difference between the dry-bulb temperature and the
wet-bulb temperature is called wet-bulb depression. Dry-bulb and wet-bulb
temperatures can be measured with an instrument called a psychrometer.

3. Reative humidity (rh): Relative humidity is a ratio of the amount of water in
the air relative to the maximum amount of water the air could hold if it were
fully saturated. Relative humidity is expressed as a percent and the values can
range from 0% (dry air) to 100% (fully saturated).

4. Moisture content: The moisture content is a measure of the actual amount of
water held intheair in theform of vapor. Moisture content is measured in terms
of pounds of water per pound of air (Ib water/Ib air) or grains of water per pound
of air (gr. of water/lb air). (Note: 7000 grains of water equals one pound.) The
American Society of Heating and Refrigerating Engineers (ASHRA) measures
moisture in pounds per pound, but some psychrometric charts use grains of
water.

5. Dew point: Dew point isthe temperature at which, asair is cooled, the moisture
in the air begins to condense or form droplets that are too large to remain sus-
pended in the air. Condensation occurs on any object with asurface temperature
equal to or less than the dew point.

6. The total heat is the total heat energy in the air. It includes heat due to the
temperature of the air, heat required to change water vapor present in the air
from liquid to vapor, and heat energy in the water vapor itself. The total heat
content of air is expressed as BTU per pound of dry air (customary units or
Joules per kg of dry air (Sl units).

7. Specific volume: Specific volume is the volume of space occupied by a pound
of dry air at standard atmospheric pressure (14.7 psi), expressed in cubic feet
per pound of dry air (ft%/Ib air).

23.4. Reading a Psychrometric Chart!

A psychrometric chart is designed so that if any two properties of the air are
known, values for the other five properties can be found on the chart. Different

1 An ASHRAE PSYCHROMETRIC CHART NO. 1 is used in this section. Obtain from
American Society of Heating, Refrigerating and Air-conditioning Engineers, Inc. 1791
Tullie Circle, NE, Atlanta, Georgia, 30329. (404-636-8400). If adifferent chart is used the
values may be different.
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FIGURE 23.1. Dry bulb, wet bulb, and saturation temperature scales.

charts are used. It is common to see high temperature, normal temperature, and
low temperature charts. In addition, charts are produced for special purposes. To
complete the activities of this section you should obtain a normal temperature
psychrometric chart. Note: the scales for each property of air are different and the
number of graduations for each scale is not the same. The recommended practice
isto interpolate only one decimal point beyond the scale.

A psychrometric chart has ascale and linesfor each property. To find the values
for the properties of air, you must be able to locate what is called the state point.
Thestate point isthejunction of any two property lines, Figure 23.1. Thefollowing
section will explain how to locate the seven properties of air.

23.4.1. Dry-Bulb Temperature

The dry-bulb temperature scale is located along the bottom of the chart. Because
thisis abasic measurement, it usualy is given or known. Locate it first, and then
move vertically into the chart along the dry-bulb temperature line. In Figure 23.1
adry bulb temperature of 72 degrees was selected.

23.4.2. Wet-Bulb Temperature

Thewet-bulb scaleisfound along the curved side of the chart with thelinesleading
down and to the right. Locate the wet-bulb temperature, and then follow the line



296 23. Heating, Ventilation, and Air-Conditioning

down andtotheright into the chart until it meetstheline of another known property
of the air, for example, the vertical dry-bulb temperature line, Figure 23.1. If the
temperatures of 72°Fdb and 56°Fwb are known, then the state point is located at
the junction of these two lines, the “+” shown in Figure 23.1. Note: the wet-bulb
lines are very close to the heat lines. It is easy to confuse the two.

23.4.3. Dew Point

Thedew point temperature usesthe same scal e asthe wet-bul b temperature and the
same lines as the moisture scale. To locate the dew point value, move horizontally
to the left from the state point. For example, in Figure 23.1 the dew point is41°F.

23.4.4. Total Heat

The total heat, enthalpy, scale is found by following the total heat lines up from
the state point and to the left of the wet-bulb scale. The total heat lines and wet
bulb lines almost coincide and this can cause errors in reading the chart, but they
use different scales, Figure 23.2.

23.4.5. Specific Volume

The specific volume scale is located on vertical lines angling up and to the left
from the dry-bulb temperature scale. They start at lessthan 12.5 ft%/Ib in the lower
left corner and progress to greater than 15.0 ft3/1b in the upper right corner of the
chart, Figure 23.2. The values (scale) are contained on the lines.

23.4.6. Relative Humidity

Relative humidity lines follow the curved side of the chart. They progress from
10%, on the line closest to the dry-bulb temperature scale, up to 100%, which is
the wet-bulb scale. Notice that the values (scal€) are located on thelines, not at the
edge of the chart, Figure 23.3.

23.4.7. Moisture Content

The moisture content scales are usually located on the right side of the chart.
To locate a value for moisture, move horizontal to the right from the state point,
Figure 23.3.

A psychrometric chart from the American Society of Heating, Refrigerating and
Air Conditioning Engineers (ASHRAE) or similar group will contain all of seven
of these scales. Figure 23.4 isalow precision chart that can be used for learning
about psychrometrics and solving the sample problems, but an ASHRAE chart
should be used if possible.
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FIGURE 23.2. Enthalpy and specific volume scales.
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FIGURE 23.3. Relative humidity and humidity ratio scales.
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Problem: What are the physical properties of air if the dry-bulb temperature is
75°F, and the wet-bulb temperature is 60°F?

Solution: Using a psychrometric chart, Figure 23.5: [Note: not al psychrometric
charts are the same. There will be small differencesin the readings from different
charts produced by different organizations.]

1. Thefirst step isto find the state point. Locate the vertical line that represents
the 75°F dry-bulb temperature. Then, locate the slanting wet-bulb line that
represents 60°F wet-bulb. The intersection of these two lines is the state point.

2. The state point isjust above the 40% rh line. Therefore the value of the relative
humidity is between 40% and 50%. Because there are no other lines between
40% and 50%, the relative humidity must be estimated or interpolated. This
point is estimated as 43% rh.

3. To find the dew point temperature, move horizontally to the left from the state
point to the curved wet-bulb and dew point scale. The reading is dlightly less
than 50°F.

4. To find the moisture content move horizontally to the right from the state point
to the vertical scale. You should read 0.0078 Ib of water per pound of dry air.

5. The total heat is found by moving from the state point along the enthalpy line
up and to theleft (parallel to the dashed lines) until thetotal heat (BTU/Ib) scale
of air is reached. You should read 27 BTU/Ib of air.

6. The specific volume is determined by locating and identifying the specific
volume lines (ft3/Ib of dry air) that fall on either side of the state point, which
inthiscaseare 13.6 and 13.7. Estimating the state point distance between these
lines gives an approximate value of 13.6 ft3/Ib.

Psychrometric charts are also used to explain the changes in the properties of
air when it is cooled, heated, had water added or water removed.

Problem: What are the valuesfor the physical properties of the air in the previous
problem (75°Fdb and 60°Fwb) after the air is heated to 90°Fdb?

Solution: Thefirst step isto determine the direction and the distance to move from
thefirst state point to the second state point. In this problem, because heat is added
and themoi sture content isnot changed, the second state point islocated to theright
of thefirst along the horizontal moisture line. Move right until thisline intersects
with the vertical 90°Fdb line, and then read the values for the characteristics at the
second state point, Figure 23.6.

The values are:

Heat = 30.0 BTU/Ib Dew point = 49°F
Specific volume = 14.05ft3/lb  Moisture = 0.0076 Ib/Ib
Relative humidity = 27% Wet-bulb = 65°F

Compare these results with those for the previous problem. When you understand
the principles of air illustrated by a psychrometric chart, you should be able to



301

Reading a Psychrometric Chart

"au0 Wo|qo.d 1o} 1eyd dLPWOIYdASd '§'EZ IHNDIH



302

23. Heating, Ventilation, and Air-Conditioning

FIGURE 23.6. Psychrometric chart for problem two.
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explain why the values for some of the characteristics changed, and why some did
not.

23.5. Heating

Heating is used to modify an environment by raising the dry-bulb temperature,
or to offset the effects of heat loss from a building. The amount of heat required
depends upon the use of the building (animal housing, product storage, etc.), the
heat flow out of the building, the ventilation needed, and the sources of heat within
the building. In buildings used for product storage, a minimum amount of, or
no ventilation may be needed, but buildings used for livestock housing must be
ventilated to remove the moisture given off by the animals as they breathe and the
harmful gasses that can develop in the building.

23.6. Ventilation Rate

Ventilation is the movement of air through a building. The movement may be
caused by natura convection, or wind, or by forcing air movement with fans. Air
is used to remove moisture, reduce the temperatureif the outside air is cooler than
the inside, and replace gases inside the building with outside air. The minimum
ventilation rate is determined by which purpose of ventilation has the greatest
reguirement. For livestock buildings, if the ventilation rate is sufficient to remove
excess moisture, it usualy will be more than enough for the other needs.

In this section, a procedure involving the use of a psychrometric chart is used
to make estimates of the amount of ventilation required to remove the excess
moisturefrom alivestock building. For buildingsused for other purposes, you must
determine which aspect of the environment is critical, and base your calculations
onthat factor. Appendix containsvaluesfor moisture and heat rel eased by different
animals and the heat produced by mechanical equipment.

When outside air isintroduced into a building, it must be uniformly distributed
within the building and mixed with the building air to prevent drafts. One method
commonly used is to introduce the air through small openings distributed around
or throughout the building. Another method is to use heat exchangers. A heat
exchanger uses the heat of the exhaust air to preheat incoming air, thus reducing
the chilling effects of drafts and reducing the amount of heat that must be added.
Actual airflow rates required for animal buildings will vary with the type and size
of animal, management system, type of floor and floor drainage, and the number
of animalsin the building.

As moisture evaporates into the air it changes the physical properties of the air.
The amount of change can be determined by locating the state points for both
conditions. The numerical differencesin the moisture content and the total heat of
both conditions provide the information used to determine the amount of air and
the heat required to evaporate the moisture.
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TABLE 23.1. Psychrometric data for ventilation problem.

Properties Inside Outside Difference
Dry bulb (°F) 55 40

Wet Bulb (°F) 48 35

Moisture (Ib H>O/1b of air) 0.0054 0.0028 0.0026
Total heat (BTU/Ib) 19.00 13.0 6.0
Specific volume (ft3/Ib of air) 13.1 12.65

Problem: How much air and heat will be needed to evaporate 2.0 Ib of water per
hour from within a building when the inside air temperature is 55°F dry bulb (db)
and 48°F wet bulb (wb) and the outside air conditions are 40°Fdb and 35°Fwb?

Solution: In this problem we will use values for five of the properties of air for
two different air conditions. Constructing atable, Table 23.1 isvery helpful andis
recommended for solving problems of this type.

The first step is to use the psychrometric chart to find the values for mois-
ture content, total heat, and specific volume for both the inside and outside air.
Thesevalues arerecorded in the columns*“Inside” and “ Outside.” Note: the values
used are from the chart in Figure 23.4. Numbers from an ASHRAE chart will be
dightly different. An ASHRAE or similar chart should be used when solving areal
problem.

Thenext step isto determinethe differencesin moisture content and in total heat
between the inside and the outside air. These values are recorded in the column
labeled “Difference” Values for the differences in temperature and in specific
volume are not needed in this problem.

The third step is to determine the amount of air (Ib) required to remove the
moisture. The amount of air required to evaporate the moistureis determined from
thedifferencein the moisture content of theinside and the outside air. A difference
of 0.0026 Ib of water per pound of air meansthat every pound of outsideair brought
in and raised to inside conditions is capable of absorbing 0.0026 Ib of moisture.
If each pound of air absorbs the maximum amount of water, 0.0026 Ib, and the
amount of water that must be removed is 2.0 |b per hour, then the required amount
of ar (Ib) is:

Ibair llbair 201b Ibair
b~ 0.0026Ibwaer < Lhr 023 7O
For these inside and outside conditions, 770 Ib of air per hour moving through the
building will be needed to remove 2.0 |b of water per hour, assuming that the air
absorbs the maximum amount of water.

Beforewater inliquid form can be absorbed by air, it must be vaporized, and this
requires heat. In addition, if the inside of the building is warmer than the outside,
ventilation causes aloss of heat from the building. Thetotal amount of heat lost is
determined by using the difference in the heat of the incoming and the outgoing
air. Theamount of heat intheinside air is 19.0 BTU/Ib, and that of the outside air
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is13.0 BTU/Ib—adifference of 6.0 BTU/Ib. Thisamount of heat will be lost with
each pound of air ventilated. We have already determined that 770 Ib of air per
hour will be needed to evaporate the water produced in the building; so the heat
loss due to ventilation is:

BTU Ibar 6.0BTU BTU

hr =770 ? X Ib air = 4,620 or 4,600 W

For these conditions, 4,600 BTU per hour of heat will be transported outside the
building with the ventilation air.

Ventilation fans usually are sized in units of cubic feet per minute. This will
require a units conversion from weight to volume. This conversion is made using
the specific volume val ues from the psychrometric chart. When the ventilation fan
is exhausting building air (the most common situation), then the inside specific
volume is used. If the fan is blowing in outside air, the outside specific volumeis
used. Becauseit takes 770 Ib of air per hour to evaporate the water produced in the
building, the volume of air (ft3/hr) that is required is determined by multiplying
the pounds of air per hour by the specific volume. The size of fan required is:

ft3 lb air it ft3
b= 770 s 13.1 bar = 10,087 or 10,000 -

A fan, or several fans with a combined capacity of 10,000 cubic feet per hour is
required to provide enough ventilation to remove the excess moisture from the
building.

The values calculated in the previous problem are accurate only as long as the
inside and the outside environments do not change. Thisonly occursfor short peri-
ods of time because the outside temperature is constantly changing, the respiration
rate of the animals changeswith activity, and heat exchanges al so occur because of
conduction, convection, and radiation. Heating, ventilating, and cooling systems
must be able to react to change, and if they are required to maintain a constant
inside environment, they must have the capacity for the most extreme inside and
outside situations.

23.7. Building Heat Balance

The principles of heating, ventilation, and air-conditioning are all used to deter-
mine the amount of ventilation, heat, or air conditioning needed to maintain the
temperature inside a building. The process of determining what changes are oc-
curring in the environment inside a structure is call a heat balance. Expressed
mathematically a heat balanceis:

BT
+Heat (h—ru) = Total heat gain (Hg) —Total heat loss(H\ )

Three possible answers can result from using the heat balance equation. (1) The
amount of heat gain is larger than the heat loss. This will result is a positive (+)
heat gain. In this situation, the temperature of the building will increase. (2) The
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heat gain and heat loss will be the same. When this is true, the answer from the
heat balance equation is zero, and the temperature within the building will remain
stable. (3) The heat lossis greater than heat gain. When thisistrue, the answer for
the equation is negative (—) and the temperature inside the building will decrease.

The four factors needed to determine heat gain and loss are: mechanical equip-
ment heat, animal heat, heat flow, and ventilation. Mechanical equipment, such as
electric motors and heat lamps, and animals put heat into the building. Heat flows
from areas of high temperature to areas of low temperature. The term heat flow
is used to describe the movement of heat through the components of a building.
Ventilation and its effect on the environment are discussed in a previous section.

These factorsusually result in either aheat gain or aheat |oss, depending on the
season of the year and the temperatures. For awinter heat balance, the heat gainis
the sum of the animal heat and the mechanical equipment heat, and the heat |osses
are due to heat flow and ventilation.

+Heaty = (Animal heat + Mechanical heat) — (Heat flow + Ventilation)

For asummer heat balance, the heat gain isthe sum of the animal heat, mechanical
equipment heat, and heat flow.

+Heats = (Animal heat + Mechanical heat + Heat flow) — (Ventilation)

The following problem illustrates the procedure for calculating a winter heat bal-
ance for abuilding. Note: in this calculation the effects of radiation are ignored.

Problem: Determine the daytime heat balance (BTU/hr) for a 30.0 ft by 60.0 ft
structure with 8.0 ft walls, which houses two hundred 150.0-1b feeder pigs. The
building has two, 3.0-ft by 6.6-ft pine doors, 1.0 inch thick. In addition, it has ten
24.0-inch by 42.0-inch single-pane windows. The walls are 8.0-inch lightweight
concrete block with the cores filled with lightweight perlite. The ceiling is 3/8-
inch plywood with 6.0 inches of low-density batt insulation between the joists.
The mechanical equipment includes nine, 100 W incandescent lights that operate
10 hr per day, two, 1/3 horsepower auger motors which operate 30 min per day,
and ten, 1/4 horsepower ceiling fansthat operate 5 hours per day. The attic spaceis
well ventilated and is at the same temperature as the outdoors. The building is on
an insulated concrete dab. The temperatures are 70°Fdb and 60°Fwb inside and
40° Fdb and 34° Fwb outside.

Solution: Two values are required to determine a heat balance—thetotal heat |oss
and thetotal heat gain. Begin by determining total heat loss. For winter conditions,
total heat losses are heat flow and ventilation.

Heat losses: The heat flow equation used in the previous chapter is used to
determine the total heat flow into or out of abuilding. Thetotal heat flow isfound
by calculating and summing the heat flow for each component of the building
having a unique R-value. The different R-values in this problem include those
of the walls, windows, door, ceiling, and floor. Errors can be reduced by setting
up a table of the required information. Because heat flow is a function of area,
temperature difference, and thermal resistance, table columnsareincluded for this
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TABLE 23.2. Solution for building heat flow problem.

Component Total R value Area (ft?) AT (°F) Q (BTU/hr)
Walls (less openings) 7.65 1330 30 5215.68. ..
Windows 0.91 70 30 2307.69. ..
Doors 1.85 40 30 648.64. ..
Ceiling 20.32 1800 30 2657.48...
Floor 222 180* 30 2432.43...

Total heat flow (Qt) = 13,261.93...

*The perimeter (ft) is used for slab floors, not the area (ft2).

information, Table 23.2. In addition, it may be helpful to sketch components, as
in the examplein Chapter 22. A sketch was not used in this example because each
building component has a small number of parts. Using the conduction heat flow
equation:

A x AT
R

where Q = heat flow (BTU/hr); A = area of structure with similar R value (ft?);
AT = difference in temperature between inside and outside (°F); R = thermal
resistance of the building component.

Withatemperaturedifferenceof 30°F, thetotal heat loss(flow) is13,262BTU/hr.
These numbers were calculated as follows:

Q:

R-values:
Wall:
Outside air film 0.17
Concrete blocks, filled cores 6.8
Inside air film 0.68
Total R-value for wall 7.65
Windows:
Outside air film 0.17
Single-pane glass 0.06
Inside air film 0.68
Total R-value for windows 0.91
Daor:
Outside air film 0.17
Wood 1.00
Inside air film 0.68
Total R-value for door 1.85
Ceiling:
Inside air film 0.68
Insulation (6-in batt) 19.00
Plywood 0.47
Outside air film 0.17
Total R-value for ceiling 20.32
Floor:

Insulated concrete 2.22
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Areas.

ft> = (areaof endwalls + area of sidewalls)
— (area of windows + area of doors)
= [(8.00 ft x 30.0 ft x 2) + (8.00 x 60.0 ft x 2)]
— (70.0ft? + 40.0ft?)

Walls:

= 1440 ft> — 110 ft?
= 1330 ft?
ft? = Width x Height x Number of windows

Windows:

[(24.0in x 42in) x 10] 11
= . X X X ——=

144in?
= 70ft?

ft> = Width x Height x Number of doors
Doors:

=3.0ft x6.6ft x 2
= 40 ft?

Ceiling: ft? = Length x Width = 60.0 ft x 30.0 ft = 1,800 ft?

Perimeter:
Floor:

ft = (Length x 2) + (Width x 2) = (60.0 x 2) + (30.0 x 2)
— 180 ft

Building heat flow (Qr):

QT = Qwall + Qwindow + Qdoor + chiling + Qfloor

1330 x 30.0 70.0x 30.0 40.0x 30.0 1800 x 30.0 180 x 30.0
765 ' 0ol | 18 | 2032 | 222

= 5215.68...42307.69... +648.64... +2657.48... 4 2432.43. ..

BTU

hr

= 13261.92. .. or 13,300

Thisisawintertime heat balance so ventilation is a source of heat loss. The venti-
lation heat loss is determined by the ventilation rate required to remove the excess
moisture from the building and the difference in temperature between the inside
and the outside air. A table should be used to organize the psychrometric data,
Table 23.3.
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TABLE 23.3. Psychrometric datafor problem.

Properties Inside Outside Difference
Dry bulb (°F) 70.0 40.0

Wet bulb (°F) 60.0 34.0

Moaisture (Ib/1b) 0.0088 0.0026 0.0062
Total heat (BTU/Ib) 26.5 125 135
Specific volume (ft3/1b) 13.6 12.6

Inthisproblem, thebuilding isused to houselivestock. Therefore, theventilation
rate will be determined by the amount of water vapor produced by the animals.
Appendix X contains values that can be used to estimate the amount of heat and
moisture produced by various animals, based on weight and species.

To determine the ventilation rate, begin by finding the amount of water released
into the building. A 150-Ib feeder pig produces 0.219 Ib of moisture per hour,
Appendix X. The total water produced is:

Ib H,0
hr 200 pigs = 43.8

p 0219

hr pig
Next, determine the amount of air needed to remove 43.8 b of water per hour. This
is accomplished by multiplying the amount of water that each pound of air can
absorb as it passes through the building by the amount of water that needs to be
removed. If we assume that the air is 100% saturated when it leaves the building,
then the amount of water that the air will remove is determined by the difference
between the moisture content of the air entering and that of the air exiting the
building. From Table 23.3, this value is 0.0062 Ib of water per pound of dry air.
The amount of air needed is:

Ibair llbair 43.8 Ib water Ibair
o~ oo0e2ibwae < hr o ooAeL--or7060

Now that the ventilation rate is known, the amount of heat |oss due to ventilation
can be calculated. Thisis accomplished by multiplying the pounds of air per hour
that will be moving through the building by the difference between the amount
of heat in the inside air and that in the outside air. From Table 23.3, thisvalueis
13.5BTU/Ib of air. The heat loss due to ventilation is:

IbH,0O
hr

BTY _ 2060 28" 135 BTV _ 95310 0r 95300 E1V
hr hr Ibair hr
Thetotal heat lossis obtained by adding the rates for heat flow and ventilation:
% = Heat flow 4 Ventilation losses
BTU BTU
= 13,300 —— + 95,300 ——
hr hr
BTU

= 108,600 ——
hr
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Heat gain: Next determine the total heat gain. The sources of heat are the mechan-
ical equipment and the heat given off by the animals, Appendix X.
Mechanical equipment:
. Btu . .
Heat gain = Mechanical heat + animal heat
Mecahnical heat = Lights + Motors

att Btu Btu
Lights = ligh 100 — 4—— )= 2=
ights (9 ights x 100 F ght watt-hr) 3060 -
hp hp
Motors = [ 2 motors x 0.33 —— | + [ 10 motors x 0.25
motor motor
— (066 ™" o5 P | 4000 BY
day day hp-hr
= 12,640 @
day
Btu
Mechanical heat = 3060 — + 12,640 —
day day
= 15,700 @
day
354 BTU
BT T T
Animal heat v = : x 200 pigs = 70,800 —U
hr pig hr
Heat gain = Mechanical heat + Animal heat
= 157OOB—+70800@
hr hr
= 86,500 @
hr

Heat balance: All of the information needed to complete the heat balance is
available.

BTU .
=+ Heat balance = Total heat gain — Total heat loss

= 86,500 w — 108,600 E
hr hr
BT
—22,100 —U
hr

A heat balance with a negative number indicates that the amount of heat gain in
the building islessthan the amount of heat being lost from the building. When this
occurs, the temperature inside the building will decrease unless additiona heat is
added. For this problem, 22,100 BTU/hr of heat is needed to maintain the inside
temperature of the building. Note: livestock building environments are dynamic
systems. The heat gain and lossis never constant. In this problem the heat balance
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was calculated with the assumption that the auger motors and ceiling fans were
operating. The auger motors only operate 30 min a day. What happensto the heat
balance when they are turned off? What is the effect of turning off some of the
ceiling fans, or one of the waterers developing aleak?

23.8. Air-Conditioning

In some types of buildings, ventilation may not be adequate to maintain the opti-
mum temperature. The amount of heat produced by the animals, the processing,
outside temperatures and so on, may exceed the ability of the ventilation system
to maintain the desired temperature. In these situations, air conditioners are used.

Historically many different systemswere used to condition the air. Cooling with
ice, pumping well water through a radiator, evaporative cooling, or drawing air
through underground tubes has all been used. The effectiveness of these methods
waslimited. The use of icewill produce large amounts of cooling, but the resulting
water must be disposed of, and a continuous supply of ice must be available. The
amount of cooling available from well water islimited, and evaporative cooling is
effective only if the outside air has alow relative humidity.

Today, the term air conditioning refers to conditioning air through the use of
mechanical refrigeration. Refrigeration is the process of transferring heat from
one substance to another; and for air conditioning, refrigeration moves heat from
the air inside a structure to the air outside the structure. For this to occur, the air
that is to be cooled must come in contact with a material at a temperature lower
than that of the inside air. When this happens, heat from the air will flow into
the colder material. Some air conditioners use a chilled metal surface to provide
a cold mass, whereas others use a spray of chilled water. The heat is transferred
by a substance circulating between the inside air and the outside air. In smaller
units, the transfer substance will be a gas; for larger systems, the substance may
bealiquid. Figure 23.7 isan illustration of the basic components of a mechanical
refrigeration system.

FIGURE 23.7. Mechanical refrigeration system.
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In a mechanical refrigeration system, heat is moved by alternately compress-
ing, liquefying, expanding, and evaporating a refrigerant, commonly Freon. The
compressor increases the pressure and the temperature of the refrigerant asit com-
pressesthe gas. Asthe refrigerant passes through the condenser, the heat absorbed
by the refrigerant as it passed through the evaporator, and the heat produced by
compression, istransferred into the air. Thus, the condenser will be located where
outside air moving acrossit absorbs the heat causing the refrigerant to liquefy. As
the liquid refrigerant flows through the expansion valve and into the evaporator,
the pressure drops and the refrigerant absorb heat from the surrounding air. The
evaporator will be located inside an air duct or other location where air can pass
through it and be cooled, causing the refrigerant to be vaporized. The hot, low
pressure gas flows back to the compressor and the cycle begins again. The expan-
sion valve and a thermal bulb regulate the flow of the refrigerant to produce the
desired evaporator temperature.

It iscommon for mechanical refrigeration air conditioning to lower the temper-
ature 20 to 30 degrees. Often this results in an air temperature that is below the
dew point. This is the reason building and automabile air conditioners produce
water. This can be shown on a psychrometric chart.

Problem: How many pounds of water will be removed per pound of dry air when
air at 95°Fdb and 70% rh is cooled to 75°Fdb?

Solution: The solution is mapped out in Figure 23.8. Locate theinitial state point
on a psychrometric chart. Air conditioning lowers the dry-bulb temperature, so
move left to 75 degrees. Asthe air is cooled, the relative humidity increases and
in this exampl e the saturation point is reached before 75 degrees. In this situation,
follow the saturation line down to 75 degrees. Thisis the second state point. The
amount of water removed isthe differencein the humidity ratio between state point
one and state point two.

Ib H,O Ib H,O Ib H,O Ib H,O

Ibdry air Ibdryair  Ibdryair Ib dry air

Evaporative cooling is still useful for reducing the temperature of air in climates
where the relative humidity islow. An evaporative cooler pullsoutside air through
awet pad of porous material. Asthe air passes through the pad the temperature of
theair causeswater to evaporate, |lowering the temperature, and raising therelative
humidity. Figure 23.9illustrates the components of awindow or portable unit. The
larger systems used in greenhouses and other structures have similar components.
The principles of evaporative cooling can be demonstrated using a psychrometric
chart.

Problem: Determine the amount of reduction in the temperature of air that is at
100°Fdb and 40% rh after it passes through an evaporative pad and becomes 90%
saturated.

Solution: Figure 23.10 shows the solution mapped out on the psychrometric chart.
Start by locating state point number one. |n evaporative cooling, water is converted
from liquid to avapor. This requires heat. The heat for evaporation is drawn from
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FIGURE 23.9. Evaporator cooler.

theair, which lowersthe dry-bulb temperature. L owering the dry-bulb temperature
is represented by moving horizontally to the left from state point number 1. But
evaporative cooling also adds water vapor to the air. Adding water vapor to the air
is represented by moving vertically up the chart from state point number 2. The
result is a vector problem. The best estimate of the direction to move using the
chart is to follow the wet-bulb line to the left and up until the second state point
isreached, 90% relative humidity. In this example, evaporative cooling lowersthe
temperature from 100°Fdb to 81°Fdb, a difference of 19°F.

23.9. Metric Problems

Some of the S unitsfor psychrometrics are the same and some are different. Refer
to Table 23.4 and Figure 23.11 before attempting to complete a sample problem.

TABLE 23.4. Comparison of customary and Sl psychrometric terms.

Term Conventional Sl
Relative humidity % %
Volume Ft3/Ib M3/kg

Dry bulb °F °C

Wet bulb °F °C
Enthalpy Btu/lb dry air kJkg dry air
Dew point °F °C
Moisture content Ib H,O/lb dry air kg H2O/kg dry air

Time hour hour
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FIGURE 23.11. Metric psychrometric chart.
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TABLE 23.5. Information for drying problem.

Properties Initial Final Difference
Dry bulb (°C) 30°Cdb

Wet bulb (°C) 20°Cwb

Moisture (kg H,O/kg of air) 0.0108 0.014 0.0032
Volume (m®/kg dry air) 0.087

Problem: Determine the size of fan (m®/hr) that will be required to naturally air
dry 100.0 kg of product in 8.0 hr that must have 23.5 kg of water removed. The
outside air conditions are 30°Cdb and 20°Cwb and the air is 85% saturated when
it leaves the dryer.

Solution: Fansaresized by air moving capacity (m®/hr). Theamount of air (m®) is
determined by the amount of water that must be removed and the amount of water
that can be adsorbed by each cubic meter of air. The first step isto develop atable
of pertinent information, Table 23.5 and Figure 23.12.

mé  235kgH,0 1kgair im?

= X X

hr 8.0 hr 0.0032 kg H,0 ~ 0.087 kg dry air
235 m3

= 0.0022. .. = 10551.36. .. or 10,000 s
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Salection of Structural Members

24.1. Objectives

1. Understand the importance of beam size.

2. Be able to define simple and cantilever beams.

3. Beableto calculate the maximum load that can be carried by a beam.
4. Be ableto calculate the size of beam needed to support aload.

24.2. Introduction

A beam is a horizontal member used to support a load. The design of structural
members for a particular load involves analysis of the forces imposed on the
member by loading and selection of appropriate materials, shapes, and sizesto ac-
commodatetheloads. Thisprocedureisbest accomplished by astructural engineer
and is beyond the scope of this book. Failure to use a beam of adequate size can
|ead to beam failure with the accompanying danger of injury and/or financial loss.
However, several basic concepts are presented here to help the reader understand
the properties and load-carrying abilities of simple and cantilever beams made of
wood.

24.3. Simple and Cantilever Beams

Simple and cantilever beams are structural members that are loaded by forces
applied at right angles to the longitudinal axis. The load that a beam can carry
depends on its length, the method of support, the manner of loading, its cross-
sectional size and shape, and the strength of the beam material.

Many different types of beams and loads exist in buildings and structures, but
only twotypesof beamsand two typesof loadsare considered in thischapter. These
are simple and cantilever beams, and point and uniform loads. A simple beam
is supported at each end without rigid connections; it merely rests on supports.
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FIGURE 24.1. Two types of beams and two types of loads.

A cantilever beam is supported solidly at one end, with the other end free to move,
Figure 24.1.

Point | oads can be applied at any specific point along the beam, but the equations
used in this chapter only apply to point loadsin the middle of asimple beam and at
the end of a cantilever beam. A point load isindicated by a single arrow. Uniform
loads are applied along the entire length of the beam, and are indicated by a series
of arrows.

24.4. Beam Loading

When aload is applied to a simple beam, the beam tends to bend. As the beam
bends or flexes, the fibers along the bottom surface of the beam are stretched (put
in tension), and the fibers along the top surface of the beam are pressed together
(compressed). It isimportant to remember that the oppositeistrue for acantilever
beam. with a cantilever beam, the top stretches and the bottom is compressed.

As the fibers of a beam stretch, a stress is set up in the fibers. When beam
loading and fiber stretching proceed to apoint wherethefibersyield, the maximum
alowable fiber stress (S) has been exceeded. Estimates for maximum allowable
stress are available for most materials, and values for maximum allowabl e fiber
stress of wood can be found in Appendix XI.

The shape of a beam and the way that it is positioned to carry a load greatly
affect its load-carrying ability. The common sawing method for boards results in
boards that are flat sawn, the grain of the wood tends to be parallel with the long
dimension, Figure 24.2. A flat sawn beam will support more weight on edge than
when placed flat.

The dimensions of a beam (width and depth) are used to determine the section
modulus, which provides an index of the relative stiffness or load-carrying ability
of the member.
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FIGURE 24.2. Relative strength of lumber oriented with the shortest dimension parallel to
the load (on its side) and the shortest dimension perpendicular to the load (on its edge).

For arectangular cross-section member, the section modulus is determined by
using the following equation:

1
K == xa xb?

where K = Section modulus (in®); a = Width of member, horizontal dimension
(in); b = Depth of member, vertical dimension (in).

24.5. Dimensioned Lumber

The lumber industry uses two different sizes, nominal size and actual size. The
nominal size is the dimensions of the lumber after it is sawed. The actua sizeis
the size of the lumber after the surfaces have been finished. Finishing removes
material, therefore the actual size is smaller than the nominal size, Table 24.1.
Lumber is purchased using the nominal size, but the actual size must be used for
beam calculations. An additional term may also be used and that is rough sawed
or unfinished. When calculating beams using rough sawed or unfinished lumber,
the actual sizeisthe nominal size.

Problem: What is the section modulus for a2 x 4 standing on edge?

Solution: Section modulusis calculated on actual size. Therefore:
axb® 15inx(35in)?
6 6

To save time and eliminate one step in the calculations, Table 24.1 lists values for
the section modulus of several common sizes of 2-inch (thick) lumber. Note that

K= = 3.0625 or 3.0
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TABLE 24.1. Section modulus of rectangular members.

Section modulus for
position (in3)

a a
[]b b
Nominal size (in) Actual size (in) On edge Flat
2x2 1.50 x 1.50 0.56 0.56
2x3 15x 2.50 1.56 0.94
2x4 1.5x 3.50 3.06 1.31
2x6 15 x 5.50 7.56 2.06
2x8 15x 7.25 13.14 2.72
2x 10 15x9.25 21.39 3.47
2x 12 15x 11.25 31.64 4.22
2x14 15x 13.25 43.89 4.97

in Table 24.1, the section modulus for a2 x 4 on edge is 3.06. The nominal size
(what one asks for at alumber yard) and the actual size (the actual dimensions of
the lumber) are shown. The section modulusis calculated for the actual size. Two
columnsof valuesare shown for thetwo possible positions of amember—standing
on edge and lying flat. Notice that the values for the section modulus are much
greater when the member is standing on edge, asit is much stiffer in this position.

The amount of weight that a beam can support is determined by the section
modulus, alowable fiber stress, beam span or length, type of load, and type of
support. For the two types of beams and loads being considered in this chapter,
the following equations apply:

4sK
Simple beam, point load: W = -+

85K
Simple beam, uniform load: W = I

K
Cantilever beam, point load: W = ST

25K
Cantilever beam, uniform load: W = %

where W = Maximum allowable load on the beam (Ib); S = Allowablefiber stress
(Ib/in?); L = Length or span of beam (in); K = Beam section modulus (in3).

Problem: What isthe maximum point load that can be supportedinthemiddleof a
4 x 6-inch, rough sawed (dimensions are the actual dimensions of the board) sim-
plebeam 120incheslong whentheallowabl efiber stressis 1,500 b per squareinch?

Solution:
1 1x4i 6.0in)? )
K=2>-xaxbhb?= x4inx (6.0in) =24in®
6 6
4 x 1,500 b 24in®
K ) _2
wo BK_ in —1.2001b

L 120in
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24.6. Size of Beam

In the previous section, the method for determining the size of load that a beam
will support was illustrated. In some situations, it is necessary to determine the
size beam that is necessary to support a given load. The same equations are used,
but they are rearranged to solve for the section modulus. Once the section modulus
is known, the beam size can be determined from Table 24.1 if one dimension is
2 inches (nominal), and the orientation is known.

Problem: What is the smallest size of 2-inch, No. 1, southern pine simple beam
that will support auniform load of 2,400 |b if the beam is 100 inches long?

Solution: Using Table 24.1 and Appendix XI, and rearranging the equation:

85K W x L  24001bx 100in
W= K=%5= Ib
% 8 x 1,000 —

n

=30in®

Referring to Table 24.1, the smallest beam size with a section modulus equa to
or larger than 30 cubic inchesis abeam 2 incheswide and 12 inches deep. Notice
that a2 x 14 inch beam also would carry the load, but is larger than necessary.
The procedures presented in the previous sections are not limited to boards
2 inches wide. If the section modulus and one dimension are known, the width of
abeam greater than 2 inches can be determined if the equation is rearranged.

Problem: What depth of boardisneeded inthe previousproblemif aboard 4 inches
wideis used?

Solution: Rearranging the equation:

Kx6 [30in’x6

. 2 = /45=6.708... or 6.7in
n

1
Kzéxaxb2 b=

This example illustrates that a beam 4 x 6.7 inches (actual size) will support the
same load as abeam 2 x 12 inches (hominal size).

24.7. Sl Metric

The procedure to solve Sl metric is the same as that for customary units. Lumber
dimensions are often given in centimeters or millimeters. Stressisin kilopascals
(kPaor kN/m?). To convert from allowable stressin Appendix X1 from psi (1b/in?)
to kPa, multiply Scusomary Dy 6.8947, Table 24.2.
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TABLE 24.2. Metric lumber sizes.

Nominal size (cm) Actud size (cm)
50x 5.0 45 x 4.5
75x%x5.0 70x 45

10.0 x 5.0 9.0x 4.5
15.0 x 5.0 14.0 x 4.5
10.0 x 10.0 9.0x 90
10.0 x 15.0 9.0 x 14.0

Problem: What isthe maximum point load that can be supported in the middle of
a 10 x 15 cm, rough sawed (dimensions are the actual dimensions of the board)
simple beam on edge that is 3.0 m long. The board is No. 1 yellow pine?

Solution: Allowable stress from Appendix X1 is 1000 Ib/in. Convert this value
to Sl units

kPa
Ss| = 6.8947 —— x SCustomary
Ib/. 5
n
kPa ,
Sg = 6.8947 —— x 1,000 Ib/in° = 6,894.7 kPa

Ib/inz

1m 1m?
1 x 10 cm x (15.0 cm)? x ( )

1 100cm  \ 10,000 cm?
K=>-xaxhb’= !
6 6
0022
_ 000225 _ ) ho0375 m?
KN ,
4% 68947 % 0.000375 m
o 4K -
L 120in x 0.0254 E
10.34205 KN-m
o 3.39306 or 3.39

Problem: Determine the maximum load that can be supported on the end of a
finished 100 mm x 50 mm cantilever beam that is 4.0 m long. The beam is on
edge and is No. 2 southern pine.

Solution: Converting allowable stress

SS| = 6.8947 W X SCustomary

kN |
/in2 in

= 5,688.1275 kN
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solving for K:
1
K = 6 X a X b2
1m 1m?
1x 45 9.0 cm)?
 LxASemx(9.0em)”x 355 X 16,000 o
N 6
=6.075E—-5
solving for W:
W — SK  5688.1275kN x 6.075E — 5

L 4.0m

_ % =0.086388... or 0.09 kN
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Principles of Electricity

25.1. Objectives

Be able to define electricity.

Be able to define basic electrical terms.
Understand and be able to use Ohm’s law.
Be able to calculate electrical power.

Be able to calculate electrical energy use.

agrwNE

25.2. Introduction

Agricultural production depends heavily upon electrical energy to power machines,
lights, equipment, and tools used in producing and processing agricultural prod-
ucts. An understanding of the principles of electricity will lead to more efficient
use of electricity and reduce the risks associated with working with and around
electricity.

25.3. Electricity

Electricity is the flow of electrons from one atom to another. Scientists believe that
electricity was first noted when ancient people discovered the attraction between
an amber rod and other materials.

An understanding of electricity begins with the atom. Electrons travel in orbit
around a nucleus composed of protons and neutrons. When an atom has the same
number of protons and electrons, it has no charge. When it has more electrons than
protons, it has a negative charge, and if more protons than electrons, a positive
charge. As electrons move from one atom to another, electric current is produced.

A flow of electrons can be produced by different methods, including friction,
heat, light, pressure, chemical action, and magnetism. The last two are used most
often in agriculture.
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25.4. Electrical Terms

To understand electricity and how it functions, it is important to understand com-
mon electrical terms and their definitions.

Current: Current is the movement of electrons through a conductor. The amount
of current moving is determined by the voltage divided by the resistance.

Alternating current (AC): One of two types of electric current, alternating current
does not exhibit constant polarity or a constant voltage. The voltage builds to
a maximum value in one polarity, declines to zero, builds to a maximum value
in the other polarity, and declines to zero again, Figure 25.1. This sequence is
called one cycle. In the United States the common current is 60 cycle; that is,
60 complete cycles occur every second.

Direct current (DC): This current flows in one direction only and at a constant
voltage, Figure 25.2. The polarity will be either positive or negative.

Amperage (amp): A unit of measure for the amount of electricity flowing in a
circuit. One ampere of current is equivalent to 6.28 x 10*® electrons per second.

Circuit: A continuous path for electricity from the source to the load (machine or
appliance using the electricity) and back to the source.

Conductor: Any material that has a relatively low resistance to the flow of elec-
tricity. Such materials allow electrons to flow easily from one atom to another.
Most metals are good conductors.

Insulator: Any material that has a relatively high resistance to the flow of electricity.
Such materials do not allow easy movement of electrons from one atom to
another. Glass, rubber, and many plastics are insulators.

Resistance (Ohm): The characteristic of materials that impedes the flow of
electricity. All materials have varying amounts of electrical resistance. Two

1/60 sec 1/60 sec . 1/60 sec

B ——— i &

90 180 270360 450 540 630 720 8109009201080
Electrical degrees

FIGURE 25.1. Three complete cycles of 60 cycle alternating current.
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FIGURE 25.2. Direct current at positive 12 V.

characteristics of resistance are important: (1) when electricity flows through a
resistant material, heat is generated; (2) when electricity flows through a resis-
tant material, the voltage is decreased. Resistance is measured in units of ohms
and designated by the Greek letter 2 (omega).

\oltage (V): The electromotive force that causes electrons to flow through a con-
ductor. Voltage is a measure of the potential for current flow. A voltage potential
may exist between objects without a flow of current. In the United States the
two standard voltages are nominally 120 V and 240 V.

Watts (W): Unit of electrical power. Watts are determined by multiplying the
voltage times the amperage.

Ohm’s law: Ohm’s law explains the relationship between current, voltage, and
resistance. Ohm’s law states that the voltage in a circuit is equal to the amperage
times the resistance. Expressed as an equation:

E=IR

where E = Voltage (V); | = Current (amp); R = Resistance (ohms).
Itis common to rearrange this equation to solve for any one of the three variables.
For example:

E E
|l =—and R = —
R I

Problem: What is the current flow (amp) when the source supplies 120 V and the
circuit has 20.0 ohms (2) of resistance?

Solution:
E 120V

R 20.0Q

= 6.0 amp

25.5. Electrical Power

By definition, power is the rate of doing work. In electricity, work is done by
electrons moving within a conductor, and is the result of the electrical potential
(V) and the flow rate of the electrons (amp). Thus, in an electrical circuit, power
is the product of volts x amperes. The basic units of electrical power are the watt
(W) and the kilowatt (kW). In equation form:

P=ExI

where P = power (watts); E = voltage (V); | = current (amp).
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Problem: How much power is being produced when the current is measured at
5.0 amps and 120.0 V?

Solution:
P=E x| =120V x 5.0 amp = 600 watt

Power also may be expressed in two other ways. Ohm’s law states that E = I R,
and (power) P = E x I; therefore the E in the power equation can be replaced
with IR from Ohm’s law:

P=IRxl or P=1%R

E
Ohm’s law also states that | = E; therefore:
E 2
P=Ex— o P= E_
R R

Note that the use of either of these equations requires knowledge of a value for the
resistance. When the resistance and one of the other quantities are known, power
can be determined.

25.6. Electrical Energy

Electrical energy is different from electrical power because it includes the element
of time. The amount of electrical energy produced, or used, is determined by
multiplying the electrical power (watts) by the amount of time electricity flows
(hours). The result is expressed in the units for electrical energy, watt-hours (W h).
For many uses of electricity, the watt-hours value is a large number; so, the electric
industry has adopted a more convenient unit, the kilowatt-hour (kW h), as the basic
unit of electrical energy. One kilowatt equals 1000 W. The amount of electrical
energy used can be determined by:

EE(Wh) =P xT

and:
1kW h
1,000 W h

where EE = Electrical energy (W h); P = Power (W); T = Time (hr)

EE(KWh) =P x T x

Problem: How much energy (W h) is required to operate a 150-W light bulb for
3.5h?

Solution:

EE=P xT =150W x 3.5hr =525W h
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Expressed in kW h:

kW h =525 W h x = 0.525 kW h

1,000 W
Electrical energy also is used to determine the cost of using electricity. Itiscommon
practice for an electric utility company to sell electricity on a cents (¢) per kilowatt-
hour basis. When the electric rate (¢/kW h) and the amount of electricity (kW h) are
known, the cost of operating any electrical appliance or motor can be determined.
In the following example the units cancellation method is used.

Problem: What will it cost to operate the light bulb in the previous problem, When

the electricity costs 10 ¢/kW h?

Solution: Using units cancellation:

10 cents
kW h

When the electricity costs 10 ¢/kW h, then it will cost 5.2 cents to operate the
150 W light bulb for 3.5 h.

Cost (cents) = 0.525 kW h x =5.250r 5.2 cents

25.7. S| Metric Customary Calculations

It is obvious from the examples that electrical calculations are performed in Sl
metric units. If the unit of power is horsepower, use the conversion constant 1 hp
= 0.743 kW and work the problem in SI units.
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Series and Paralld Circuits

26.1. Objectives

. Be abletoidentify seriesand parallel circuits.

. Be able to determine the total resistance of both series and parallel circuits.

. Be able to attach a voltmeter and an ammeter correctly.

. Be able to determine the amperage and the voltage at any point within a series
or aparald circuit.

. Explain the importance of system and equipment grounding.

A WNPRE
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26.2. Introduction

The purpose of electrical circuitsisto supply electricity for an appliance, tool, or
other type of electrical device. These devices are called loads. Before the load will
operate, electricity must have acomplete path from the source to theload and back
to the source. This path for electricity is called a circuit. Two types of circuits are
commonly used to supply electrical power, series and parallel.

This chapter will explore some of the principles of series and paralld circuits
and how to calculate the amperage and/or voltage of these circuits.

26.3. Seriesand Pardle Circuits

Thefollowing discussion will explain the differences between the two circuitsand
how to calculate thetotal resistance of thecircuit. Note: to aid in the understanding
of the following discussion of circuits, assume that the conductors in the circuit
have no resistance.

26.3.1. Series Circuit

Inaseriescircuit the electricity has no alternative paths. All of the electricity must
pass through all of the componentsin the circuit, see Figure 26.1.
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2.5Q
Voltage source Resistors 320
409

FIGURE 26.1. Seriescircuit.

For the electricity to leave and return to the source it must pass through all three
loads, resistors. In a series circuit the total resistance of the circuit is the sum of
each resistance where the unit or resistance in the Ohm (£2).

Rr=Ri+R2+Rs+---+ Ry
The total resistance of the circuit in Figure 26.1 is:
Rr=25Q+432Q+40Q2=97Q

The total amperage flow in the circuit can be determined by dividing the source
voltage by the total resistance.

Problem: What is the current flow for the circuit in Figure 26.1 when the source
voltageis 120 V?

Solution:

E 120V
E=IR I =—-=——=123711---0r 12A
R 9.7 Q

26.3.2. Parallel Circuit

Inaparalel circuit the electricity has alternative pathsto follow (see Figure 26.2)
and consequently the total resistance of the circuit is not equal to the sum of
the individual resistances. The total amperage in the circuit is determined by the
total resistance, but total resistance is determined differently from series circuits.
The amperage through any path is determined by the voltage at the path and the
resistance of the path.

Thetotal resistance can be determined by more than one method. In one method,
the inverse of the total resistance is the sum of the inverses of each resistance in

[
Voltage <>
source T 2.5Q 40 Q 32Q
FIGURE 26.2. Paralld circuit.




Series and Parallel Circuits 333

the paralel circuit:

Thisequation requires solving for acommon denominator or reducing thefractions
to adecimal. The easiest way to determine a common denominator is to multiply
the denominators. When thismethod is used for the circuit in Figure 26.2, the total
resistanceis:

1 1 1 1
R 250 200 320
128 8 10
"ty
30.8
= =5 = 09625
Rr = — & — 1039..- or .0
0.9625

Using this method, the total resistance of the circuit is0.96 .
When reducing the fractions to a decimal, it isimportant to remember that the
result isthe inverse.

Problem: Determine the total resistance of the parallel circuit in Figure 26.2 by
reducing the fractions.

Solution:
1 1 1 1
R 25W T 20w 32w
— 0.4+ 0.25+ 0.3125
1

Comparethetotal resistanceof thiscircuit tothetotal resistance of theseriescircuit.
With the same resistors, the total resistance is much lessin aparallel circuit.
Another method is to solve for the equivalent resistance of pairs of resistors,
until al of theresistanceis reduced to asingle resistance. Thisisaccomplished by
using the equation:
_ Rl X R2
~ R1+R;
When the circuit has more than two resistors, determine the equivalent resistance
(Rg) for any two, and then combine it with the third, and so on, until only one
resistance remains. The resistance of the circuit in Figure 26.2 with thismethod is:
_25Qx40Q  10Q
S 25Q+40Q 65Q
_15Qx32Q  49...
- 15Q+32Q  4.738...

T

Re =1538...0r1.5Q

=1.038...0r1.0Q2

Ry
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Using this method the total resistance is 1.0 €2, which agrees with the other two
methods.

26.4. Series—Paralld Circuits

A series—parallel circuit combines characteristics of both types of circuits. Some
of theresistors are in series, and some are in parallel. Thistype of circuit is more
common in el ectronic equipment thaninthecircuitsused to supply el ectrical power
for agricultural equipment.

Study Figure 26.3. Incircuit A, all of the el ectricity must passthrough the 2.5-Q
resistor, but then it has two alternative paths. Part of the current will pass through
the 4.0 Q2 resistor and the rest will pass through the 3.2 @ resistor. Circuit B is
the same circuit, just drawn differently so that it is easier to see the relationship
between the three resistors.

To solvefor the total resistance of a series—parallel circuit, start by reducing the
parallel resistors. The circuit then acts as a series circuit, and the resistances can
be added. It is helpful to redraw the circuit after each pair of parallel resistorsis
condensed. To determinethetotal resistancefor Figure 26.3, thefirst stepistofind
the equivalent resistance of the parallel branch of the circuit. Either parallel circuit
equation can be used. The equation using pairs of resistancesis considered easier
to use.

40Qx32Q 128Q
40Q+32Q  72Q

The resistance of the parallel branch of the circuit has an equivalent resistance
of 1.8 2. The next step isto combine this equivalent resistance with the remaining
resistorsin the circuit.

Figure 26.4 shows that the series—parallel circuit can be reduced to a series
circuit. The total resistance of thiscircuit is:

Rr =25Q+1777...Q =43Q
The series—paralld circuit has atotal resistance of 4.3 Q.

=1777... Q

E

250
[ W
A ? 40Q 320
Qr
40Q
250

FIGURE 26.3. Two represen-
B T 3.20 tations of a series-parallel
circuit.
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FIGURE 26.4. Equivalent series resistance 250 1.8Q

of Figure 26.3.
g [ VWA

26.5. Determining Voltage and Amperage in Circuits

In agricultural circuits the voltage is determined by the source of the electrical
energy. Standard domestic service is 120 or 240 V. Agricultural equipment may
have electrical systemsthat operate on 6, 12, 24, or 48 V.

Amperage is determined by measuring the circuit with an ammeter or by cal-
culations using Ohm’'s law, E = | x R. In Ohms law “E” stands for electrical
motive force, invalts, “1” isintensity, in amperage or amps, and “R” isresistance,
measured in Ohms. When the resistance is known, the amperage can be deter-
mined by rearranging Ohm'’slaw. Thetotal amperage of acircuit can be calculated
by dividing the source voltage by the total resistance of the circuit. Rearranging
Ohm’s law for amperage:

E (volts)

| (aMP) = = onms)

Problem: Determine the total amperage for the series circuit illustrated in
Figure 26.5. Use 120 V for the source.

Solution: Using Ohm’s Law:

_ E(volty) 120V _ 120V
~ R(Ohmsg) 25Q+32Q+40Q 97Q

I (amp) =12.371.-- or 12amp
A circuit with 9.7  of resistance and asource voltage of 120 V will haveacurrent
flow of 12 amps.

The same procedure is used to determine the amperage of aparallel circuit. The
source voltage is divided by the total resistance in the circuit.

2.5Q
O
Voltage source Resistors 3720
40Q

FIGURE 26.5. Seriescircuit for sample problem.
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26.6. Using Voltmeters and Ammeters

It is helpful when troubleshooting circuits to be able to measure the voltage and
amperageinthecircuit. Theinstrumentsused for thispurposearecalled voltmeters
and ammeters. When attached properly they will measurethevoltage and amperage
inacircuit.

26.6.1. Voltmeters

Two characteristicsof circuitsmust berememberedin using voltmeters: (1) Voltage
isthe measurement of apotential between two points; so the reading on avoltmeter
is the difference between the connection points. To reduce the effect of adding a
voltmeter tothecircuit, themeter isconstructed with avery highinternal resistance.
(2) Anytime that electricity flows through a resistance heat is produced and the
loss of energy causes the voltage to decrease. This decrease is called the voltage
drop.

26.6.1.1. Voltmetersin Series Circuits

InFigure26.6, voltmeter number one (V1) isconnected acrossthe source; therefore,
the reading on the voltmeter will be equal to the source, assuming no resistancein
the conductors. Voltmeter number two (V) isconnected acrossthe 3.2 Q2 resistor. It
will measure the differencein voltage from one side of theresistor to the other—in
other words, the voltage drop across the resistor.

Problem: What will voltmeter number 2 read in Figure 26.6 if the source voltage,
measured by voltmeter number 1is120V?

Solution: Voltmeter number 2 is measuring the voltage drop caused by the 3.2
resistor. Voltage drop is caused by current passing through aresistance, therefore
to calculate the voltage drop acrosstheresistor, thetotal current flow in the circuit
must be known. The first step is to calculate the total current flow in the circuit.

4.0 Q

FIGURE 26.6. Voltmetersin series circuit.
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FIGURE 26.7. Voltmeters in par- | T % % -1
allel circuiits. :
@ 2523 4092 329 ®
L5

.- d

To calculate total current flow the total resistance must be known.

Rr=Ri1+Rx+R3

=25Q+32Q+40Q

=97Q
E 120V

E=IR |l=—=——=1237... or 12am
R 9.7Q P

The next step is to determine the voltage drop across the resistor:

E=IR=12ampx 3.2Q2 =3840r 38V

When 12 amps flow through aresistance of 3.2 Q2 with asource of 120V, thereis
avoltage drop of 38V. Voltmeter 2 will have areading of 38 V.

26.6.1.2. Voltmetersin Parallel Circuits

In a parallel circuit, voltmeters connected across the resistors are, in essence,
connected across the source voltage. Therefore, assuming that there is no voltage
drop from the resistance of the wire, both voltmetersin Figure 26.7 will have the
same reading as the source voltage.

26.6.2. Ammeters

Ammeters are used to measure the amount of current flowing in a circuit. The
laboratory type of ammeter is connected in series. To reduce the effect of the
meter on the performance of the circuit, they are constructed with a very low
resistance. A clamp-ontype of meter isalso availabl e that measurestheintensity of
the electromagnetic field around asingle conductor and convertsthefield intensity
into amperage.

26.6.2.1. Ammetersin Series Circuits

When we calculated the amperage of this circuit in the previous section, we de-
termined that with a 120 V source the current was 12 amps. In a seriescircuit, the
electricity does not have alternative paths to follow. Because al of the amperage
flows through all components in the circuit, both ammeters in Figure 26.8 will
have areading of 12 amps.
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% .

3.2

[ Gy
T

4.0 Q

FIGURE 26.8. Ammetersin a series circuit.

26.6.2.2. Ammetersin Parallel Circuits

In paralé circuits, ammeters must also be attached so the current passes through
them; but because the electricity has aternative paths, they will measure only the
current in the conductor they are inserted into, see Figure 26.9.

Problem: What are the readings for ammeters number 1 and number 2 in
Figure 26.9 when the source voltage is 120 V?

Solution: In this example problem, ammeter one is located between the source
and the first branch on the circuit; therefore it will measure the total current flow
in the circuit. Ammeter two is in the last branch of the circuit, therefore it will
only measure the current flowing through that branch on the circuit. In aprevious
section it was explain that to measure current flow, the source voltage and the total
resistance of the circuit must be known. The first step is to determine the total
resistance of the circuit.

1 1 1 1
R 250 200 320
128 8 10
B
30.8
=5 = 0.9625
Rr = ; = 104o0rl0Q
0.9625
The next step isto calculate the total current flow in the circuit.
E=IR I:Ezﬂzlzoamps
R 1.0Q

Ammeter number 1 will have areading of 120 amps.

—® &
T 2:5 Q% +0 Q% .20 FIGURE 26.9. Ammeters in a parallel
circuit.
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Ammeter number 2 only will measure the current flow in that branch of the
circuit. Ohm's law is used to solve this part of the problem also:

E 120V
E=R l===_—+
R 32Q

In summary, assuming no resistance in the conductors, in a series circuit the am-
perage remains the same, and the voltage changes as the resistance changes. In
paralle circuits the voltage remains the same, and the amperage changes as the
resistances changes in the circuit.

= 37.5amps

26.7. Grounding

Tosimplify theearlier discussion of circuitsonly two conductorswereused, hot and
neutral. To meet current wiring codes a complete wiring system uses at least three
conductors; hot, neutral, and ground. The ground conductor (equipment ground)
is attached to the case of metal-cased tools and it must provide a complete low
resistance circuit to the earth, Figure 26.10.

Thisis usually accomplished by attaching it to the grounding bar in the service
entrance pandl. If a short occurs between the electrical components and the case
or frame, the low-resistance ground circuit will permit a current flow greater than
the circuit over-current protection (fuse or circuit breaker), causing the circuit to
open. If a short occurs and the ground circuit is not continuous from the case or
frame of thetool to the earth, the operator’s body or body parts may complete the
circuit resulting in a potentially fatal electric shock.

FIGURE 26.10. Case of equipment ground.
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Sizing Conductors

27.1. Objectives

. Understand the importance of using electrical conductors of the proper size.

. Be ableto calculate voltage drop.

. Be ableto calculate the proper size conductor.

. Beable to select the proper size conductor from atable.

. Understand the importance of circuit protection, and be able to identify the
three common types.

OO~ WNPE

27.2. Introduction

Conductors are used to provide a path for electricity. The metals used for conduc-
tors have a relatively low resistance, but they have enough resistance to cause a
voltage drop when current passes through them. If the wires are overloaded, the
voltage drop increases, causing a reduction in the efficiency of the circuit and an
increase in the heat produced. Heating the conductors above their designed oper-
ating temperatures will cause the insulation to fail, and the heat generated can be
sufficient to start afire if flammable materials are close.

27.3. Calculating Voltage Drop

To maintain the heat produced by electricity passing through a resistance at the
designed level, national standards, primarily the National Electric Code, limit the
voltage drop alowed in acircuit. For most circuitsthisis 2 or 3%. Voltage drop is
the term used to describe the reduction in voltage that occurs as electricity flows
through a resistance. Voltage drop occurs because materials resist the flow of
electricity; thecritical issueisto ensureit does not become excessive. The amount
of voltage drop is determined by the amount of current and the total resistance in
the circuit. The size of a conductor required for an electrical load is determined
by the allowable voltage drop for the circuit, the size of the load, and the length of
wirefrom the source of electricity to theload. The resistance of conductorsusually

340
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islisted as ohms (€2) per 1,000 ft of conductor length. Because the electricity must
passthrough the entirelength of aconductor, conductorsperform asone continuous
series resistance.

Appendix XII includes the resistance for various sizes of copper wire using
AWG sizesand Appendix X111 contains resistance valuesfor Sl wire sizes. Notice
that the resistance is given in ohms/1,000 ft or ohms/100 m. Bare wire is seldom
used in circuits, but because the type of insulation used influences the resistance,
these values are used to illustrate the principles of voltage drop. Resistance values
for wireswith different types of insulation can be found in the National Electrical
Code (NEC) or other sources and these must be used when calculating wire size
for a specific application.

The voltage drop is calculated using Ohm'’s law. For general purpose circuits,
the voltage drop must be limited to 2%. The NEC alows a 3% drop for some
individual circuits. In calculating voltage drop, the length of conductor usually
will be measured as either the length of wire from the source to the load and back
(Iength of wire), or the run (the distance from the source to the load).

Problem: What is the voltage drop in a wire length of 1,500.0 ft, when No. 12
wireisused, and the load is 10.0 amps?

Solution: Using Ohm'’s law and, from Appendix XII, using a resistance for No.
12 wire of 1.62 ©/1,000 ft, the voltage drop is:

1.62 Q 24,300
E =IR = 10. —— x1 Oft=——— =243V
0.0 amp x 100001t x 1,500.0 ft 1000 3

The 1,500.0 ft of No. 12 wire has avoltage drop of 24.3 V. If the source voltageis
120V, isthis an acceptable voltage drop?

_ 243V
- 120V

The answer then isno—a 20.25% voltage drop isexcessive. If No. 12 wireis used
with this load, the electrical appliance will not operate correctly, the conductors
will over heat and thereisthe potential for afire. A larger conductor sizeisneeded
to carry aload of 10.0 amps for adistance of 1,500.0 ft.

For wires longer or shorter than 1,000 ft, the resistance is proportiona to the
length. The total resistance for any lengthiis:

L)
~ 1,000 ft

where R, = Resistanceinohms(£2) for any length (ft); R = Resistance per 1,000 ft
(R2); L = Length of wire (ft).

% x 100 = 20.25%

L x L (ft)

27.4. Caculating Conductor Size

The previous problem was used to illustrate the principle of voltage drop. In
practice, because the percent of drop is fixed by electrical codes, conductors are
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sized by calculating the amount of resistance per 1,000 ft that will result in an
acceptable voltage drop, and then selecting the appropriate size of wire from a
table similar to Appendix XII.

Problem: What size of wireis needed to carry a 120-V, 15.0-amp load with a 2%
drop when the run is 200.0 ft?

Solution: Thefirst step is to determine the permissible amount of voltage drop:
Voltage drop(Vp) = 120V x 0.02 = 2.4V

The second step is to determine the amount of resistance for the load that will
cause a2.4-V drop. Thisis accomplished by using Ohm'’s law:
E=IR R:Ezﬂzo.lesz
I 15.0 amp

For a circuit with a resistance of less than 0.16 @ and a load of 15.0 amps the
voltage drop will belessthan 2%. Remember that the voltage used to calculate the
resistance is the voltage drop, not the source voltage.

To select the correct sizewire the cal culated circuit resistance must be converted
to unitsof €2/1,000 ft, and then select the appropriate wire sizefrom Appendix XII.
This can be accomplished using units cancellation.

Q
1000t — Run < DO00ft

0.16
= 2% 20007 * M00ft=040 775

Next, compare this value to the resistance values in Appendix XI1I. The objective
is to select a size of wire with a resistance equal to or less than the calculated
value. From Appendix XlI, the resistance of No. 6 wireis 0.41 ©2/1,000, and the
resistance of No. 4 wireis0.26 €2/1,000ft. The No. 4 wirewould be the best choice
astheresistanceis closest to the calculated resistance without being larger.
These examplesillustrate the principle that voltage drop is caused by resistance
and current. Another example of the importance of understanding voltage drop is
in the use of extension cords. Improper use of extension cords can lead to serious
conseguences. Many extension cords sold in retail stores use No. 16 or No. 18
wire. Extension cords of this size are very limited in current carrying capacity.
Also, when more than one extension cord is used, the resistance of the connection
can be equal or greater than the resistance of the wire. Thisiswhy the connections
of an extension cord that has been overloaded will be warm or hot to the touch.

Problem: What size load (amp) can a 100.0-ft, No. 18 extension cord carry on a
120V circuit without exceeding a 2% voltage drop?

Solution: Thefirst step isto determine the allowable voltage drop:
Vp =120V x 0.02 =24V

The next step isto determine the amount of current that will causea2.4-V dropin
the extension cord. This is accomplished by using Ohm'’s law and the resistance
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of No. 18 wire. Remember to use two times the length (100.0 ft x 2 = 200.0 ft)
to determine the total feet of conductor.

E 24V 24V
E=IR I=§= 6EL D ><20ooft=1.3029=1.843...or1.84amp
1,000 ft '

The maximum electrical load for a 100 ft, No. 18 extension cord is 1.84 amps. If
the extension cord is used for alarger load (more amps), it will overheat.

An often unrecognized factor when using extension cords is the resistance of
the connections. Two 50-ft extension cords may have more resistance than a
100 ft cord with the same size of conductors. To more clearly understand the
potential problem with extension cords, consider the following example.

Problem: What is the maximum capacity of the No. 18 extension cord in the
previous problem if two 50-ft cords are used, and the connection has a resistance
of 8.0 Q?

Solution: Using an allowable voltage drop of 2.4 V and Ohm'’s law:

E 24V
E=R I=¢%= (6.5152

1,000 ft

x 200.0 ft) +80¢Q

24V
= = 0.2580. .. .2
93029 0.2580. . . or 0.26 amp

This example shows that using two 50-ft extension cords instead of one 100-ft
cord reduces the capacity by seven times when the connection resistance is
8.0 ohms because of the additional resistance of the connection.

Many appliancesarerated in watts. To determinethe size of conductorsrequired
to supply an appliance rated in watts, the electrical power (watts) must be used
first to determine the load in amps.

Problem: A 25.0-ft extension cord will be used to operate a 1,100-W, 120-V
electrical iron. What size of extension cord should be sel ected?

Solution: Thefirst step isto determine the amperage used by theiron.

P 11

P =ElI l==—== OW
E 120V
Using an alowablevoltage drop of 2%, the next stepisto determinetotal allowable

resistance:

= 9.166. .. or 9.27 amp

E 24V

| 9.27amp
The total allowable resistance in the extension cord is 0.26 2. The next stepisto
determine the ohms of resistance per 1,000 ft:

Q 0.26 Q2 Q
10007t = 007~ 1,000 ft = 5.236... or 5.2 1,000t

E=IR R= = 0.2618... or 0.26
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The resistance of a No. 18 wire is 6.51 ©/1,000 ft, and that of a No. 16 wire is
4.09 /1,000 ft. Assuming the iron and cord connectors are in good condition, a
25-ft extension cord with No. 16 wire is adequate for the 1,100-W iron.

27.5. Selecting Conductor Sizesfrom aTable

An alternative method for sizing conductors is to use tables provided for that
purpose, such as the examples found in Appendixes X1V and XV. These tables
have several important limitations. They apply only to wires with insulation types
of R, T, TW, RH, RHW, and THW, and they can only be used with a 2% voltage
drop and 120 or 240 V. For any other type of conductor, insulation, voltage drop,
or voltage, a different table must be used.

Problem: Determine the size of wire needed to supply 120-V electricity to the
pump house in Figure 27.1.

Solution: The total length of wire is two times the sum of the distance from the
building to thefirst pole (A), the distance between the two poles, and the distance
from the last pole to the pump (B). First determine lengths A and B by using
Pythagorean’s theorem:

a?=b*+c?
Distance A is:

Distancey = v/ 25.02 + 20.02
= 4/625 + 400
= 32.015... or 32.0ft

FIGURE 27.1. lllustration for sample problem.
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and distance B is:

a=+b2+c2=+/15.0%+ 22.02 = /225 | 484 = 26.627... or 26.6 ft
Thetotal length (Lt) of wireis:
Lt = (32.0 ft + 26.0 ft + 100.0 ft) x 2 = 316.0ft

Then using Appendix X1V, select the correct size of conductor. Twelve amps and
316 ft are not shown in the table; use the next larger values (15 amps and 350 ft).
Then, from Appendix X1V, the required size of conductor is No. 3. Remember to
compare this value with the value to the | eft of the vertical line and use the larger
of thetwo sizes.

27.6. Circuit Protection

An important part of any circuit is the over current protection—fuse or circuit
breaker. Over-current devices are used to prevent the conductors from overheat-
ing. Remember: when electricity passes through a resistance, heat is produced
and a voltage drop occurs. As the electrical load on a circuit increases, the heat
produced increases and the voltage drop increases. An electrician determines the
total amperage capacity of the circuit and then installsthe appropriate over-current
protection. In the case of an overload or a short in the circuit, the over-current de-
vice stops the flow of electricity by opening the circuit. If the over-current device
burns out or trips, the circuit has been overloaded. Theload on the circuit must be
reduced or the short repaired before the circuit is energized.

An additional protection device required by most codes for residential use is
the Ground Fault Circuit Interrupter (GFCI). A GFCI constantly monitors the
differencein thecurrent between the hot conductor and neutral conductor. Whenthe
difference reaches 5 mA the GFCI trips and opens the circuit. This provides more
protection to the user of metal cased tools and when using electrical appliances
around water. Some Agricultural Engineers also recommend GFCI’s be installed
in circuits used around animals. Thisis especially true for very valuable animals.

27.7. Metric Problems

The common terms used for electricity are the same for both systems, and many
European countries also use the AWG standards for sizing conductors. For those
individuals that use metric sizes for wires the resistances for three common sizes
are listed in Appendix XIII.

Problem: Will a10.0 amp load on a120 V circuit with 2.5 mm? conductors and
arun of 24 m exceed the 2% voltage drop standard?
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Solution: Thefirst step isto determine the actual voltage drop.

0.676
- x(24dmx2)=3244...V

E =IR=10amp x

The second step is determining the percentage.
3.244...V
120V

The conclusion is that the load is not acceptable. The voltage drop is greater
than 2%.

x 100 = 2.704 or 2.7%
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Electric Motors

28.1. Objectives

1. Be able to explain the advantages and disadvantages of electric motors as a
power source.

. Understand the use and performance classifications of electric motors.

. Be able to describe the common types of motors.

. Be able to select the correct overload protection device for the application.

. Be able to interpret a motor nameplate.

a b~ wiN

28.2. Introduction

An electric motor is a machine that converts electrical energy to mechanical power.
Modern agriculture is heavily dependent on the use of electric motors. Managers of
agricultural production systems should know the common types of motors and be
able to select the correct motor. Manufacturers have gone to great lengths to design
motors to meet the needs of agriculture. The life of an electric motor is determined
by how well the motor is matched to the job and the service environment. The
following sections will discuss the characteristics and uses of 120/240-V, single
phase motors.

28.3. Electric Motors

An electric motor is an energy conversion device like internal combustion engines,
but instead of using the energy in a liquid fuel they use energy supplied by elec-
tricity. An electric motor requires an interaction between the rotating parts and
the stationary parts. Two common types of interaction are conduction and induc-
tion. The principles of a conduction motor will be used to explain the function of
electricity motors.

Electricity flowing through a conductor induces an electrical magnetic field
around the conductor. This electromagnetic field will have a plus (+) and a

347
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FIGURE 28.1. Simplified electric motor.

minus (—) polarity. When the electromagnetic field comes in contact with the
permanent magnetic field supplied by the magnets, a force is produced, because
similar polarities repel each other and opposite poles attract each other. The strength
of the force is influenced by the strength of the current, the strength of the magnetic
field and the angle between the conductor and the magnetic field, Figure 28.1.

In Figure 28.1, the commutator supplies electricity to the loop of wire. The
electromagnetic field reacts with the permanent magnetic field supplied by the
permanent magnets. This causes the wire loop to rotate. A conductive electric
motor has many individual loops wrapped around the rotor and each one of them
rotates a few degrees when they are energized by the commutator. Because a
continuous series of loops become energized the rotor continues to rotate as long
as power is being supplied to the commutator.

Many different types of motor are used and they are categorized by their type
of electricity and the type of interaction they have between the rotating part and
the stationary part of the motor. The following section will discuss some of the
advantages and disadvantages of electric motors.

28.4. Advantages and Disadvantages
28.4.1. Advantages

Electric motors have several advantages that have made them more popular than
other sources of power:

1. Initial cost: On a per-horsepower basis, the purchase price of an electric motor
is relatively low.

2. Design: Electric motors have very few parts and are very easy to operate. In
addition, because they are started and stopped with switches, their operation is
easily automated.
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. Operating costs: The operating costs of electric motors are low. They have very

low maintenance costs, and the cost of electricity allows them to be operated
for a few cents per horsepower hour.

. Environmental impact: An electric motor gives off no exhaust fumes and does

not use a flammable fuel; and although it is true that the generation of electricity
may affect the environment, it is easier to monitor and control this effect if it is
concentrated at one location.

. Noise: Electric motors operate quietly with very little vibration.
. Efficiency: An electric motor is the most efficient way to produce power, oper-

ating with an efficiency range of 70-90%.

28.4.2. Disadvantages

1.

Portability: Electric motors are not very portable; they must be connected to a
source of electricity. Advances in battery design have reduced this disadvantage
for fractional horsepower DC motors, but AC motors must be connected to a
source of alternating current.

. Electrical hazard: Electricity has an adverse effect on humans and other animals

when they come into contact with it. With the large number of motors used in
agriculture and the tendency for the environment of agricultural structures to be
wetter and dustier than residences, there is a greater electrical hazard associated
with the use of electrical motors in agricultural buildings.

28.5. Use and Performance Classifications

The following use and performance classifications provide a basis for comparing
different types of electric motors.

28.5.1. Type of Current

Motors can be purchased to operate on either single phase or three phase, direct or
alternating current, at several voltages. The voltage and the type of current used
depend on the size of the motor and the electrical service available. The phase
refers to the number of cycles of alternating current, Figure 28.2.

FIGURE 28.2. Two complete cycles of single phase alternating current.
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FIGURE 28.3. Two complete cycles of three phase alternating current.

In three phase alternating current service, three single-phase, 60 cycle currents
are combined so the peak voltages are an equal distance apart, see Figure 28.3.
Three phase current is recommended over single phase for larger loads, and is
required by most electrical service companies for motors over 5-10 horsepower.

28.5.2. Type of Enclosure

The primary enemies of motors are liquids, dust, and heat. Motors are designed
with different enclosures (cases) to operate in different environments. A drip-proof
motor has ventilation vents and will operate successfully even if water occasionally
drips on it. In a splash-proof motor, the vents are protected from both drips and
splashes. Drip-proof and splash-proof motors usually have an internal fan that
draws air through the motor to help prevent overheating. A totally enclosed motor
can be used in wet, dusty environments because it has no vents; thus the air has
no access to its internal parts. All of the heat generated inside the motor must be
conducted to the outside surface and dissipated into the air. Some totally enclosed
motors have a fan mounted outside the case to increase the air flow (cooling)
around the motor enclosure.

28.5.3. Type of Bearings

Motors are constructed with either sleeve or ball bearings. Sleeve bearing motors
are less expensive than ball bearing motors, but can withstand less force perpen-
dicular to the shaft (belt tension, etc.) than ball bearing motors and the life of the
bearings is usually shorter unless they can be lubricated.

28.5.4. Type of Mounting Base

Electric motor manufacturers have standardized the mounting brackets for motors.
In replacing a motor, if the same base style is used, no modifications should be
required in the motor mounts.
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28.5.5. Load-Starting Ability

Some electrically driven machines offer little resistance to rotation when they
are started. These loads are said to be easy to start. Other machines offer greater
torsion resistance when starting, and are considered to be loads that are hard to
start. The amount of torque required to start a machine depends on the type, size,
and operating characteristics of the particular machine. Thus, some knowledge of
the starting characteristics of a load is necessary to select the correct motor.

28.5.6. Starting Current

Motors require more current to start a load than they do to operate the load once it
is rotating. The starting current required may be seven to eight times the operating
current. The starting current of motors is classified as low, medium, or high.

28.5.7. Reversibility

Electric motors can be designed to operate in either a clockwise or a counter-
clockwise direction of rotation, but some motors can have the direction of rotation
changed by electricians. These are classified as electrically reversible or mechan-
ically reversible.

28.5.8. Dual Voltage Potential

If a motor has dual voltage, it can be operated on either 120 or 240 V; the voltage
used is determined by the voltage available from the source. Motors operating on
240 V are more efficient and require smaller conductors than those operating on
120 V. Motor voltage potential is considered to be dual or single.

28.6. Types of Motors

A description of each of these types of motors and information on selection of
the ideal type for a specific situation is beyond the scope of this text. Each of
these types of motors will have specific advantages and disadvantages for specific
applications, Figure 28.4.

Three of these types of motors are more common in agricultural applications than
the others. These types are listed in the following sections, with a short description
of each type.

28.6.1. Split-Phase

Split-phase motors are inexpensive and are commonly used for easy-to-start loads.
The starting current may be as high as seven times the operating current, depending
on the load. They are very popular for powering fans, centrifugal pumps, and other
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FIGURE 28.4. Common types of electric motors.

applications where the load increases as the speed increases. The common sizes
are 1/6 to 3/4 horsepower.

28.6.2. Capacitor Motor

A capacitor motor is a split-phase motor with the addition of capacitors to in-
crease the starting and/or running torque. Capacitor motors are the most widely
used type in agricultural applications, particularly in the smaller sizes of less than
10 horsepower.

28.6.3. Repulsion Motors

Repulsion motors are used for hard-to-start loads. Two common variations of the
basic design are used: repulsion-start induction-run, and repulsion-induction. The
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use of brushes and the additional construction requirements cause repulsion motors
to be the most expensive type. They are available in a wide range of sizes.

28.7. Overload Protection

The over-current devices (fuses and circuit breakers) in the service entrance panel
of a building are designed to protect the circuits from shorts and excessive current.
The starting current of electric motors is greater than the operating current. In
addition, when an electric motor is overloaded it will attempt to rotate until the
electricity is disconnected or the lock-up torque is reached. Both of these situations
can cause an excessive current in the motor circuit. The over current devices must
be designed to withstand temporary overloads. Common breakers and fuses do not
meet these requirements.

When a motor is overloaded for an extended period of time or on a frequent basis,
it will overheat. Some motors include an overload protection device to protect the
motor from overheating. These devices work on the principle of resistive heating.
Because the current demand of a motor increases as the load increases, and because
the greater the current flow through a resistance the greater the heat, engineers can
predict when certain temperatures will be reached and design controlling devices
using temperature as the trigger.

Three types of motor overload protection devices are used:

1. Built-in thermal overload protection: Many motors have this device as an in-
tegral part of the motor. It may have either an automatic reset or a manual reset.
If the automatic reset type is used, the device will disconnect the motor from
the circuit at the designed temperature, and when it has cooled down, will auto-
matically reconnect the electricity. This type of device should be used where the
motor is supplying power for a critical purpose, as in livestock ventilation vans
and sump pumps. Automatic reset devices can be more dangerous than manual
because they will attempt to restart the motor as soon as they cool down. If the
power is not disconnected before anyone works on the machine, it can restart
during repairs and cause an injury. When a manual reset device is used, it must
be manually reset before the motor will start. Even with this device, the power
should be disconnected before anyone works on the motor or the machine it is
powering.

2. Manual starting switch with overload protection: A manual starting switch
overload protection device can be added to motors without built-in thermal pro-
tection. This device is an integrated switch and thermal overload device that opens
the circuit when the motor overheats. It must be reset by hand before the motor
can be restarted.

3. Magnetic starting switch with overload protection: Magnetic starting switches
are fast-acting switches for large motors and are equipped with a thermal overload
(heater) device that will open the circuit if the current draw is excessive. These
devices are manually reset.
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28.8. Motor Nameplate Data

The National Electrical Manufacturers Association (NEMA) has developed a stan-
dardized system of identifying the important characteristics of motors. The stan-
dards do not specify a shape or location for the nameplate, and nameplates may not
all contain the same information; but the information that is important for motor
selection will be included, see Figure 28.5.

The following list of terms covers some of the information that can be found on
motor nameplates:

Manufacturer: The company name and address are included to provide a source
of further information.

Horsepower: The designed full-load horsepower rating of the motor is given.

Serial number: The serial number is included to facilitate the procurement of parts
when they are needed.

Frame: Standard frame numbers are used to ensure that the motors are interchange-
able. If the frame number is the same for two motors, the mounting bolt holes
will have the same dimensions.

Speed: The speed is in revolutions per minute (rpm). It is the speed at which the
motor will operate under a full load.

Phase: This indicates whether the motor is designed for single or three phase power.

Temperature: This is the maximum ambient temperature for the motor.

Service factor: The service factor indicates the safe overload limit of the motor.
An SF of 1.20 means that the motor can be operated continuously with a 20%
overload without damage.

Code letter: The code letter is used to indicate the size of the overload protection
device that will be needed.

Hertz: This indicates the designed operation frequency of the electrical supply. It
is shown as 60 cycles or 60 hertz.

Duty rating: Motors will be rated for either continuous or intermittent duty. If the
rating is for intermittent duty, the nameplate may also indicate the maximum

( Company Information h
Hp 1/3 SN 432N5-A
FR 42 RPM 1725
PH 1 TEMP 35C
SF 1.20 Code |
Hz 60 CONT
“ v 1207240 Amp 6/3 /  FIGURE 28.5. Typical motor information.
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amount of time that the motor can be operated. Exceeding the duty cycle will
cause the motor to overheat.

\oltage: The operating voltage for the motor will be indicated. If the nameplate
contains only a single value, the motor is not dual voltage.

Amperage: This indicates the current demand at full load. If two numbers are
given, it indicates the amperages for the two voltages listed. For example, in
Figure 28.5, the amperage is listed as 6/3. This means that when the motor is
wired for 120 V, the full load amperage is 6 amps, and it is 3 amps when the
motor is wired for 240 V.
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APPENDIX |. Conventional unit conversions.

Unit Abbrev. Conversion values
1Acre ac 43,560 ft3 160 rods?
1 British BTU 778.104 ft-b 3.93E— 4 hp-hr
Thermal Unit
1 Bushel bu 2,150.42in3 1.24446 ft3 32dry qt
1 Foot ft 12in 0.3333yd 6.061
E — 2 rod*
1 Foot, cubic ft3 1728in3 29.9 qt, liquid 7.481 gal, 0.04 yd®
liquid
1 Bushel Bu 2,150.42in3 32qt, dry 1.24446 ft3
1 Foot-pound ft-lb 3.239E-4BTU 5.051E-7 3766 E—7
hp/hr kW/hr
1 Foot per second  ft/sec 0.68182 mi/hr 0.1667 ft/min
1 Foot, square ft2 144 ir? 6.9E — 3yd? 9.29E — 2M?
1Gallon, liguid  gal 231in3 0.13368 ft3 4 liquid qt
1 Gallon, dry Gal 268.8in°
1 Horsepower hp 550 ft-1b/sec 33,000 ft-Ib/min
1Inch in 8.333E— 21t 23E-3yd
1 Kilowatt kW 737.612 ft-lb/sec  1.34111 hp 0.94796
BTU/sec
1 Kilowatt-hour ~ kWh 2,655,403 ft-Ib 341266 BTU 1,000 W/hr
1 Mile mi 63,360in 5,280 ft 1,760 yd 320 rods
1 Mile per hour mi/hr 1.46667 ft/sec 88.0 ft/min
1 Pound per Ib/ft2 6.944 E — 31bfin?
sguare foot
1 Pound per Ib/ft3 5.787 E — 4 Ibfin®
cubic foot
1 Quart, liquid qt 57.75in% 2pt 320z 3.342
E—2ft
1Ton T 2,000 1b
1 Watt w 0.73761ft-lb/sec  9.48E—4 1.341
BTU/sec E—3Hp
1Yard yd 36.0in 3.0ft
1 Yard, square ydd 1,296 in? 9.0ft3
1 Yard, cubic Yd® 46,656 in® 2713

E — 4isthesameas x10~4.
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Quantity From To Multiply by
Acceleration
Vehicle (mile/h)/s (km/h)/s 1.609344
General ft/s? m/s? 0.3048
Area
General in? m? 0.00064516
ft? m? 0.09290304
Pipe in? mm? 645.16
in? cm? 6.4516
ft2 m? 0.09290304
Field acre ha 0.40469
Areaper time
Field operations acre/h ha/h 0.4046873
Consumption ga/h L/h 3.785412
Ib/(hp-h) o/(KW-h) 608.2774
Density (mass)
General ag products Iblyd® kg/m?3 0.5932763
Ib/ft3 kg/m3 16.01846
Liquid Ib/gal kag/L 0.1198264
Efficiency, fuel
Highway vehicles mile/gal km/L 0.4151437
Off highway hp-h/gal KW-h/L 0.1969931
Energy
Heat Btu kJ 1.055056
Use kwh MJ 36
Flow, Volume
Air ft3/s m/s 0.02831685
ft3/s m3/min
Liquid, general ga/min L/min
gal/sec L/s 3.785412
Fuel gal/h L/h 3.785412
River, channel ft3/s m3/s 0.02831685
Force
Pedal, lever, general | bf N 4.448222
Drawbar |bf kN 0.00448222
Length
mile km 1.609344
rod m 5.029210
yd m 0.9144
ft m 0.3048
in cm 254
in mm 254
Mass, genera Ib kg 0.4535924
(074 g 28.34952
t T 0.90719
Power
Heating Btu/min w 17.58427
Btu/h w 0.2930711
Engine Hp kW 0.7456999

(continued)
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APPENDIX II. (Continued)

Quantity From To Multiply by
Pressure Ib/in? kPa 6.894757
Ib/ft2 kPa 0.04788026
inHg kPa 3.37685
inH2,O kPa 0.24884
Temperature °F °C v F1_832
Torque | bf n-m 1.355818
Ibin 0.112984
Velocity, linear mile/h km/h 1.609344
ft/s m/s 0.3048
in/s mm/s 254
Volume ydd m3 0.7645549
ft3 m3 0.02831685
bushel L 35.23907
in3 L 0.01638706
gal L 3.78412
gd gal (imperid) 0.8327
qt L 0.9463529
acre-ft m3 1233.489
bushel m3 0.03523907
Volume/area gal/acre L/ha 9.353958

APPENDIX Ill. Estimating combine |losses.

Crop Seeds/ft2 = Bu/ac Seeds/m? = 50 kg/ha
Alfalfa 303 2,426
Barley 14 140
Beans-red kidney 14 11
Beans-white 4 32
Canola 115 1,063
Corn 2 17
Flax 1,800 15,444
Oats 11 165
Rice 30 320
Rye 22 189
Sorghum 21 180
Soybeans 4 32
Wheat 19 152
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APPENDIX VII. Nutrient utilization by crops.2
N P,Osg K20

Crop Yield Ib/lac kg/ha Ib/lac  kg/ha Iblac  kg/ha
Corn 150 bu/ac 3.82Mg/ha 185 207 80 90 215 241

180bu/ac 458 Mgha 240 269 100 112 240 269
Corn silage 32 tons 72 t/ha 200 224 80 90 245 274
Soybeans 50 bu/ac 136 Mg/ha 257 288 438 54 120 134

60 bu/ac 1.64Mg/ha 336 376 65 73 145 162
Grainsorghum  8,000Ib/ac  3.64 Mg/ha 250 280 90 100 200 224
Wheat 60 bu/ac 136 Mg/ha 125 140 50 56 110 123

80 bu/ac 2.18Mg/ha 186 208 54 60 162 181
Oats 100bu/ac  1.45Mg/ha 150 168 55 62 150 168
Barley 100 bu/ac 218 Mg/ha 150 168 55 62 150 168
Alfadfa 8tons 18t/ha 450 504 80 90 480 538
Orchard grass 6 tons 13t/ha 300 336 100 112 375 420
Brome grass 5tons 11t/ha 166 186 66 74 254 284
Tall fescue 3.5tons 8t/ha 125 140 65 73 185 207
Bluegrass 3tons 7 t/ha 200 224 55 62 180 202

Source: Imperial values reproduced with permission from: Structures and Environment Handbook,
MWPS-1, 11th edition, revised 1987, Midwest Plan Service, Ames, |A 50011-3080.
2 gl values are direct conversions rounded to the nearest whole unit.

APPENDIX VIII. Maximum annual application rates for phosphates based on soil family.

PH

Soil families % Clay 6.0t0 7.5 <6.00r >7.5

Sandy <10 300 336 kg/ha 300 Ib/ac 336 kg/ha
Coarse-loamy and Coarse-silty 11-18 400 Ib/ac 448 kg/ha 500 Ib/ac 560 kg/ha
Fine-loamy and Fine-silty 19-35 450 Ib/ac 504 kg/ha 600 Ib/ac 672 kg/ha
Fine 36-60 500 Ib/ac 560 kg/ha 750 Ib/ac 840 kg/ha
Very fine >60 500 Ib/ac 560 kg/ha 750 Ib/ac 840 kg/ha
L oamy-skeletal 15-35 150 Ib/ac 168kg/ha 200 Ib/ac 224 kg/ha
Clayey-skeletal >35 250 Ib/ac 280 kg/ha 350 Ib/ac 392 kg/ha
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APPENDIX IX. Insulating properties of various building materials.

Resistance
Density Per inch
Description Thickness  (Ib/ft3) (BthJth> Description
Building board
Asbestos-cement 120 0.25
Gypsum or plaster 0.375in 50 0.32
0.5in 50 0.45
0.625in 50 0.56
Plywood (Douglas fir) 34 125
Vegetabl e fiber board
Shesathing, regular density 05in 18 132
Sheathing, intermediate density 05in 22 1.09
Sound deadening board 05in 15 135
Laminated paperboard 30 2.00
Hardboard
Medium density 50 1.37
High density 55 122
Particleboard
Low density 37 141
Medium density 50 1.06
High density 62 1.18
Underlayment 0.625in 40 122
Waferboard 37 1.59
Wood subfloor 0.75in 0.94
Building membrane
Vapor-permeable felt 0.06
Vapor-seal, 2 layers of 0.12
mopped 15-1b. felt
Finish flooring materials
Carpet and fibrous pad 2.08
Carpet and rubber pad 1.23
Cork tile 0.125in 0.28
Terrazzo lin 0.08
Tile-asphalt, linoleum, vinyl, rubber 0.05
Insulating materials
Blanket or batt, mineral fiber
processed from rock, slag or glass
34in 0.4-2.0 11.0
35in 0.4-2.0 13.0
35in 12-16 15.0
55-6.5in  04-2.0 19.0
Boards and slabs
Cellular glass 8.0
Glass fiber 4.0-9.0 4.0
Expanded perlite 1.0 2.78
Expanded rubber 45 4.55
Expanded polystyrene, extruded, smooth 1.8-35in 5.00
Expanded polystyrene, molded beads 1.0 3.85
1.25 4.00
15 4.17
1.75 4.17

(continued)
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APPENDIX IX. (Continued)

Resistance
Density Per inch
Description Thickness  (Ib/ft3) ( CBFlszi h ) Description
Cellular polyurethane/polyisocyanurate 15 6.25-5.56
Cellular phenolic, closed cell 30 8.20
Mineral Fiberboard
Core or roof insulation 16-17 294
Acoustical tile 18.0 2.86
21.0 2.70
Cement fiber slabs
Wood and Portland cement binder 25.0-27.0 2.0-1.89
Wood and magnesia oxysulfide binder 220 175
Losefill
Cellulosic 2332 3.7-313
Perlite, expanded 2041 3.7-33

4.1-74 3.3-28
7.4-11.0 2824
Mineral fiber (rock, slag or glass)

3.75-5in 0.6-2.0 11.0
6.5-8.75in  0.6-2.0 19.0
75-10.0in  0.6-2.0 220
Vermiculite, exfoliated 7.0-8.2 213
4.0-6.0 2.27
Spray applied
Polyurethane foam 1525 6.25-5.56
Ureaformaldehyde 0.7-1.6 4.53-3.57
Cellulosic fiber 35-6.0 3.45-2.94
Glass fiber 3545 3.85-3.70
Roofing
Asbestos-cement shingles 120 0.21
Asphalt roll roofing 70 0.15
Asphalt shingles 70 0.44
Slate 0.5in 0.05
Wood shingles 0.94
Plastering Materials
Cement plaster sand aggregate 116 0.20
Gypsum Plaster
Lightweight aggregate 0.5in 45 .32
Lightweight aggregate 0.625in 45 .39
Masonry Materials
Brick, fired clay 150 0.12-0.10
130 0.16-0.12
120 0.18-0.15
100 0.24-0.20
80 0.33-0.27
Clay Tile, hollow
1 cell deep 3in 0.80
4in 111
2cells 6in 152
10in 222

3cels 12in 2.50
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Resistance
Density Per inch
Description Thickness (Ib/ft3) ( GBFJ[}Zi h ) Description
Concrete blocks
Normal weight aggregate,
8in, 33-361b 1.11-0.97
With perlite filled cores 20
With vermiculite cores 1.92-1.37
12in, 501b, 2 cores 1.23
Lightweight aggregate,
6in, 16-17 Ib 1.93-1.65
With perlitefilled cores 4.2
With vermiculite cores 30
8in, 19-221b 3.2-1.90
With perlite filled cores 6.84.4
With vermiculite cores 5339
12in,32-361b 2.6-2.3
With perlitefilled cores 9.2-6.3
With vermiculite cores 58
Stone, lime or sand 180 0.01
160 0.02
140 0.04
120 0.08
Marble and granite 180 0.03
160 0.05
140 0.06
120 0.09
100 0.13
Woods
Hardwoods
Oak 41.2-46.8 0.89-0.80
Birch 42.6-45.4 0.87-0.82
Maple 39.8-44.0 0.92-0.84
Ash 38.4-41.9 0.94-0.88
Softwoods
Southern Pine 35.6-41.2 1.00-0.89
Douglas Fir-Larch 33.5-36.3 1.06-0.99
Southern Cypress 31.4-32.1 1.11-1.09
West Coast Cedar 21.7-314 1.48-1.11
California Redwood 24.5-28.0 1.35-1.22
Windows?
Single glazed 0.06
With storm windows 115
Insulating glass, 1/4 air space
Double pane 0.84
Triple pane 171
Air space, 3/4 to 4 inches 0.90

(continued)
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APPENDIX IX. (Continued)

Resistance
Density Per irzlch

Description Thickness (1o/ft3) ( ity ) Description
Surface conditions

Inside surface 0.68

Outside surface 0.17
Floor

Concrete slab on ground 1.23

Concrete slab with insulation 2.22

kJ BTU
For conversionto Sl units Rg) = 5.678 Rcyst- Ry isinunitsof ———. Reyg isinunitsof ———.
s cust- Rsi Cm2n Reut Fieh
b Reprinted from Introduction to Agricultural Engineering, 2nd edition.

APPENDIX X. Moisture and heat produced.*

Animal Moisture? (Ib water/hr)  Heat* (BTU/hr)
Swine

10-501b 0.065 174.0

50-100 0.177 240.0

100-200Ib 0.219 354.0
Broiler

0.22-151b 0.0079 124

15-351b 0.0110 18.7
Turkey

1lb 0.0059 10.8

21lb 0.0025 9.8
Dairy cow 1.196 1917.0
Equipment
Incandescent lighting 3.4 Btu/hr-watt
Fluorescent lighting 4.1 Btu/hr-watt
Electric motors 4,000 Btu/hr-Hp

1 Reproduced with permission from: Structures and Environment
Handbook, MWPS-1, 11th edition, revised 1987, Midwest Plan
Service, Ames, |A 50011-3080.

2 The amount of water and heat released by animals changes as the
air temperature changes. These are average values.



APPENDIX XI. Allowable fiber stress by species.

Appendices 369

Size Allowablefiber
Use Grade Thick Wide stress* (Ib/in?)
Douglasfir and Larch (19% moisture)
Structural light framing
Select structural 2" 2" 1,200
No. 1 1,050
No. 2 850
Light framing Construction 24 4" 625
Standard 350
Utility 175
Southern Pine (19% moisture)
Structural light framing
Select structural 2" 2" 1,150
No. 1 1,000
No. 2 825
Stud 450
Light framing Construction 2" 4" 600
Standard 350
Utility 150

* For lumber milled and used at 15% moisture, multiply by 1.08 for allowable fiber stress.
Source: Reproduced with permission from: Structures and Environment Handbook, MWPS-1, 11th
edition, revised 1987, Midwest Plan Service, Ames, |A 50011-3080.

APPENDIX XII. Copper wire resistance

(Ohms/1,000 ft).
Wire size (AWG*) Resistance (Ohms/1,000 ft)
22 16.46
20 10.38
18 6.51
16 4.09
14 2.58
12 162
10 1.02
8 0.64
6 0.41
4 0.26
2 0.16
0 0.10

APPENDIX XIII. Copper wire resistance

(Ohms/100 m).

Wiresize(mm?)  Resistance (Ohms/100 m)
15 1.073
25 0.676
4.0 0.423
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Index

3-4-5, 175, 176
Method, 177
86% rule, 84, 134

Acceleration, 33, 34
Accuracy, 17, 18, 172
Acceptable level, 97, 171
Checking, 211, 216
Level of, 159, 210
Of calibration, 94
Of grain drill, 103
Of leveling, 210
Of odometer wheel, 162
Of sprayer, 113
Of tapes, 163
Of taping, 169
Rational method, 236
USLE, 247
Aerobic treatment, 284
Air conditioning, 311
Air masses, 222
Polar continental, 223
Polar maritime, 223
Superior, 223
Tropical continental, 223
Tropical maritime, 223
Air seeder, 107
Mobile calibration, 108
Alternating current, 327
Motor, 349
Current, 349
Disadvantages, 349
Phase, 350
Ammeter, 335, 336, 337
Parallel circuits, 338
Series circuits, 337

Amperage, 327, 328

Ammeter, 336, 337

Clamp-on, 337

Determining, 335

Equation, 335

Motor demand, 355

Over current protection, 345

Parallel circuits, 332

Series circuits, 332, 337
Anaerobic treatment, 284
Angles, 175

3-4-5, 176

Method, 177

Chord, 175

Tape sine, 178, 179
Applied force, 36

Class one lever, 38

Class three lever, 39

Class two lever, 38, 39

Combined machine, 47

Joule, 35

Wheel and axle, 42
Approximate number, 18

Significant figures, 19
Area, 23, 24

Acre, 20

Calibration, 94-122

Draft, 132

Engine displacement, 55

Fractions of a section, 200

Heat flow, 286-292

Hydraulic piston, 73-79

Of circle, 4

Pressure, 25, 32

Pumping capacity, 259-262

Rational method, 236
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Area (cont.)

Mixed watersheds, 240
Rectangular system, 197
Runoff, 234
Sl units, 32
Standard shapes, 182

Circle, 186

Irregular shapes, 188

Parallelogram, 185

Rectangle, 185

Sector, 186

Square, 185

Trapezoid, 188, 190

Triangle, 183
Surveying sketch, 211
Weather, 221

High pressure, 222

Low pressure, 222
Work, 157

Areas, 182
Circle, 186
Irregular shaped field, 188

Trapezoidal, 190
Sector, 186, 187
Tape sine, 182
Trapezoid, 187, 188
Triangle, 183

Angle and two sides, 184

Base and height, 183

Sl units, 192

Three sides, 183

Augers, 267
Capacity, 124
Belt, 267
Screw, 267

Backsight, 205
Adding to benchmark, 206
Angle, 175
On turning point, 206

Beak even use, 147
Equation, 148

Beam, 319
Calculations, 322
Cantilever, 319
EDM, 171
Equations, 322
Loading, 320
Simple, 319
Sl units, 324
Sizing, 323

Bench mark, 204
Closing to, 218

Difference between, 212
Elevation, 205
Identification, 205
Local, 205
Turning point, 206
USGS, 205
Biological products, 266
Adding water, 275
Dry weight equation, 275
Wet weight equation, 276
Handling, 266
Augers, 267
Pneumatic conveyors, 269
Moisture management, 272
Dry weight, 273
Wet weight, 273
Removing water, 275
Dry weight equation, 275
Wet weight equation, 276
Storage, 277
Block and lots, 196, 197
Block and tackle, 43
Brake, 83
Horsepower, 28, 30, 31
Power, 83, 89
Engine, 84
Prony, 30
Arm, 31

Calibration, 93, 94

Air seeder, 107
Mobile, 108

Air seeders, 107

Charts, 93

Fertilizer applicators, 94
Mobile, 98
Stationary, 96

Fertilizer spreader, 94

Grain drill, 100
Mobile, 101
Sl units, 116
Stationary, 101

Machinery, 93

Mobile, 98
Air seeders, 107
Fertilizer spreader, 100
Grain drill, 108
Row crop planter, 106

Principles, 94

Row crop planter, 104
Mobile, 106
Stationary, 105

Spray mixes, 114



Sprayer, 109
Equation, 111-114
Sprayers, 109
Stationary, 94
Fertilizer spreader, 97
Row crop planters, 105
Sprayers, 112
Capacitor motor, 352
Capacity, 118, 124, 131
Augers, 267
Dry corn, 268
Dry soybeans, 268
Current carrying, 342-345
Effective, 125, 146, 149
Effective field, 125
Equation, 125
Field, 124
Hopper, 95
Irrigation system, 258, 259
Sl units, 264
Units, 260
Units method, 264
Variables, 260
Lost, 124, 130, 131
Machine, 118
Nozzle, 112
Pneumatic system, 270
Sl units, 278
Sl units, 127
Storage animal wastes, 283
Theoretical, 124
Equation, 124
Sl units, 127
Theoretical field, 124
Throughput, 124, 126
Effective, 126
Theoretical, 126
Ventilation fans, 305
Water holding, 244
Cell, 8
Equation, 13
Fuel, 49
Load, 83
Reference, 10
Seed plate, 104
Chain, 162
And sprocket, 64
Rotation, 66, 67
Breaking, 168
Of command, 15
Saw noise, 155
Surveyors, 162
Add, 163

Index

Cut, 163
Graduations, 163
Chaining, 159
Pins, 162, 168
Procedure, 168
Chart, 13
Calibration, 93
Flow, 15
Profile, 13
Psychrometric, 293, 294
Air conditioning, 312
Changing conditions, 300
Dew point, 296
Dry bulb temperature, 295
Evaporative cooling, 312
Moisture, 296
Relative humidity, 296
Specific volume, 296
Types, 295
Ventilation rate, 303
Rainfall intensity duration recurrence
interval, 227
Sound, 154
Spreadsheet, 11
Chord method, 175, 176
Circle, 186
Chord method, 175
Equation, 8
Circuit, 327
Electrical power, 328
Ohm’s law, 328
Surveying, 212
Closing, 216, 218
Cold front, 224
Columns, 8
Field book, 214
Psychrometric chart, 304
Section modulus, 322
Sum, 11
Compression ratio, 49, 56
Equation, 56
Conductor, 327, 328
Circuit protection, 345
Dual voltage, 351
Electrical power, 328
Electromagnetic field, 347
Angle, 348
Grounding, 339
Resistance, 341
Series and parallel circuits, 331, 339
Sizing, 340, 343, 345
Calculating, 341
Selecting from table, 344
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Conductor (cont.)

\oltage drop, 340
Conversion factors, Appendix 1-14
Conversion value, 4, 5

Developing new, 29, 30

Using, 27
Correction factor, 172

5% slopes, 166

Calibration procedure, 172

Equation, 172

Sl units, 173

Slopes, 167

Using, 174
Cost, 130

Electricity, 330

Fixed, 137, 140, 141

Capital recovery factor, 137
Depreciation, 137
Insurance, 139
Interest on investment, 137
Shelter, 139
Taxes, 138
Fuel injection, 54
Irrigation, 254
Production, 263
Pumping, 253
Water, 263
Least, 130
Machinery, 136
Actual, 136
Annual, 136, 139
Estimating, 136
Lost time, 130
Operating, 130, 131, 141
Ownership, 130, 136, 137, 140
Repair, 130
Tillage equipment, 131
Total, 130
Two groups, 136
Motors, 348
Operating, 349
Production, 118, 131
Reduce, 146
Break even use, 147, 149
Increasing annual use, 147
Increasing service life, 147
Maintenance schedule, 150

Matching tractors and machines, 146
Reducing original investment, 146

Time utilizations, 146

Width utilizations, 146
Variable, 141

Consumables, 143

Fuel, 142

Labor, 143, 254

Oil, 142

Repair and maintenance, 141
Waste handling, 279

Current, 326, 327

Alternating, 327, 349
Ammeter, 337
Amperage, 327
Demand, 355
Direct, 327, 328, 349
Electrical power, 328
Grounding, 339
Ohm’s law, 328
Phase, 350
Potential, 328
Protection, 345, 353
Series-parallel circuits, 334
Skin resistance, 155
Starting, 351
Total, 338
\oltage drop, 340

Data entry, 8
Data processing, 9
Decibel, 153
Common sounds, 154
Meter, 155
Decision making, 1
Flow charts, 15
Symbols, 16
Intuitive reasoning, 7
Spreadsheet, 7
Cell, 8
Chart, 13
Columns, 8
Data Entry, 8
Data Processing, 9
Fixed reference, 11
Function, 9
Graphs, 11
Grid, 8
Logic functions., 10
Relational reference., 11
Rows, 8
Units cancellation, 2, 5, 6
Conversion factors, 6
Denominator, 5, 6
Fractions, 5
Numerator, 5, 6
Weather, 220
Denominator, 5, 6
Changing the sign, 21



Fractional area, 202
Moisture management, 273
Ratio, 57
Reducing fractions, 333
Speed ratio, 69
Dew point, 294, 296
Air conditioning, 312
Sl units, 314
Diagram, 2, 49, 212, 289
Diesel, 54, 55
Compression ratio, 56
Derating, 86
Efficiency, 119
Fuel consumption, 142
Oil use, 143
Differential leveling, 212
Error control, 214
Direct current, 327, 328
Displacement, 55
Compression ratio, 56
Engine size, 49
Sl units, 59
Distance, 24, 159
Area, 96
Between rows, 114
Block and tackle, 43
Calibration, 172
Correction factor, 172
Chord method, 176
Class three lever, 39
Class two lever, 38
Correction factors customary units, 167, 172
Correction factors Sl units, 173
Customary units, 23
Area, 24
Displacement, 160
Power, 25-27
Torque, 28
Velocity, 25
\olume, 24
Drawbar power, 83
Electronic distance measuring, 159, 165, 171
Equivalent, 272
Field efficiency, 124
Horizontal, 164
Inclined plane, 44
Measuring, 159
Mechanical advantage, 38
Odometer wheel, 161
Accuracy, 162
Optical range finder, 171
Pacing, 160
Piston movement, 74, 79

Index

Profile leveling, 12
Rectangular system, 199
Seeds in the row, 106
Sl units, 31
Acceleration, 34
Area, 32
Power, 34
Torque, 35
\elocity, 34
Significant figures, 19
Slope, 166
Stadia, 169
Equation, 170
Hand level, 208
Rod reading, 170
Tape sine, 178
Taping, 162
Chain, 162
Hand level, 164
Pins, 163
Plumb bob, 164
Procedure, 165
Range poles, 164
Tapes, 163
Thread, 46
Three point hitch, 48
Universal soil loss equation, 251
Vertical, 205, 208
Drawbar, 83
Converting ratings, 84
86% rule, 84
Horsepower, 28
Power, 83
Sl units, 151
Sizing a tractor, 132, 133
Sizing tillage machines, 135
Tractor testing, 89, 90
Dry bulb, 294, 295, 296
Air conditioning, 312
Heating, 303
Sl units, 314
Dry weight, 275
Adding water, 275, 276
Basis, 275
Equation, 273
Sl units, 278
Removing water, 275, 276
Duration, 226, 227, 228
Graph, 228
Sl units, 230, 243
Hydrograph, 235
Rainfall, 237
Rainfall factor, 247
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Duration (cont.)
Rainfall intensity, 227, 236
Recurrence interval, 227
Sound reference level, 156, 157
Time, 25

Effective capacity, 125
Sl units, 127
Efficiency, 118
Field, 124, 125
Mechanical, 119
Performance, 120
\Volumetric, 51
Electricity, 326
Energy, 328
Grounding, 339
Parallel circuit, 332
Ammeters, 338
\oltmeters, 337
Power, 328
Series circuit, 331
Ammeters, 337
Amperage, 335
\oltmeters, 336
Series-parallel circuit, 334
Sl units, 330
Terms, 327
Alternating current, 327
Amperage, 327
Circuit, 327
Conductor, 327
Current, 327
Direct current, 327
Insulator, 327
Ohm’s law, 328
Resistance, 327
\Woltage, 328
Watts, 328
\oltmeters, 336
Electronic distance measuring, 165,
171
Energy, 329
Auger requirements, 267
Conversion, 51, 52, 56
Efficiency, 118, 119
Electrical, 326, 329, 330
Heat, 286, 294
Of air, 294
Loss, 62, 336
Motors, 347
Rain drop, 245
Solar, 49
Use, 326

Engine, 49, 83
86% rule, 84
Curve, 85
Bore and stroke, 55
Carbureted, 51
Compression ratio, 56, 60
Derating, 86
Accessories, 87
Altitude, 88
Fully equipped, 87, 89
Service, 88
Temperature, 87
Diesel, 54
Displacement, 55, 60, 186
Efficiency, 119
Eight requirements, 50
Four cycle, 51, 52, 53
Four stroke cycle, 51
Fuel consumption, 142
Fuel injection, 54
Heat, 49
Horsepower, 28
Internal combustion, 49, 50
Kilowatt, 59
Lugging ability, 85
Mean effective pressure, 57
Power, 83
Prony brake, 30, 83
Sound, 153, 154
Steam, 28
Theoretical power, 57, 59
Four cycle, 57
Two cycle, 57
Torque, 71
Two stroke, 50, 52, 53
Two stroke cycle, 53
Types, 54
Compression ignition, 54
Fuel injection, 54
Spark ignition, 54
Volumetric efficiency, 51
Equations, 2, 4, 8
Area, 175
Beam, 320
Cost, 142
Drawbar, 83
Engine, 56
Moisture, 273
Noise, 155
Resistance, 329
Soil loss, 246
Speed ratios, 65
Spreadsheet, 11, 14



Trapezoid, 190
Triangle, 183
Units cancellation, 5, 106
Erosion, 244
Causes, 245
Control, 251
Soil development, 244
Types, 245
Water, 245
Wind, 246
Error
Determining acceptable, 1, 94, 99, 112
Math, 7, 306
Odometer wheel, 162
Optical range finders, 171
Pacing, 160
Random, 172
Significant figures, 18
Sources, 210
Spreadsheets, 10-11
Surveying, 210
Control of, 214
Of closure, 213, 215
Profile, 216-218
Sl units, 220
Three checks, 214-216
Systematic, 172
Taping, 162-163, 169
Evaporative cooling, 312
Exact number, 18
Significant figures, 19
Uncertainty of, 19

Fertilizer spreader, 96
Acceptable error, 98
Calibration, 101
Field efficiency, 124, 125
Fixed reference, 11
Spreadsheet, 14
Flow, 74
Air, 51, 88
Venturi, 54

Charts, 2, 15

Current, 327
Amperage, 332, 337
Circuit protection, 345
Parallel circuit, 338
Resistance, 328
Series circuit, 337
Total, 336

Electrons, 326

Gases, 52

Gravity, 95, 96

Index

Heat, 286, 303
Building total, 292
Equation, 307
Floor, 292
Gain or loss, 306
Per square foot, 288
Rate, 291

Hydraulic direction, 72

Hydraulic principle, 74

Rate, 4, 75, 94, 109
Furrow, 262
Hydrograph, 234
Increase, 113
Nozzle, 110, 111, 112
Peak, 237
Streams, 234
Throughput, 126
Water, 260, 262

Refrigerant, 312

Time of concentration, 237

\Volume, 76

Water, 49

Flow chart, 2, 15, 16
Force, 23, 25

Brake horsepower, 30

Horsepower, 29

Mass, 33

On piston, 52

Power, 26

Pressure, 34

Simple machines, 36
Block and tackle, 43
Inclined plane, 44
Jack, 46
Levers, 3641
Pulley, 43
Three point hitch, 47
Wheel and axle, 42

Torque, 28, 35

Weight, 34

Force arm, 37

Class one lever, 37

Class two lever, 38

Combined machine, 46

Mass and weight, 34

Wheel and axle, 42

Formulas, 4
Area, 182
Four stroke cycle, 50, 51
Sl units, 59
Fractions, 5
Common denominator, 333
Division, 121
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Fractions (cont.)
Inch, 23
Pulley size, 64
Reducing, 333
Section, 200, 202
Fuel, 49
Carburetion, 51
Cells, 49
Consumption, 142, 144, 347
Conversion, 50, 51, 52, 56
Costs, 136, 147
Efficiency, 90, 119
Ignition, 54
Metering, 54
Two cycle, 52
Fulcrum, 36
Class three lever, 41
Class two lever, 38, 39
Wheel and axle, 41
Function, 9
Engine, 49, 50
Memory, 155
Power trains, 66
Spreadsheet, 10
Charting, 12
Copying, 11
If, 10
Logic, 10
Sum, 10
Trigonometric, 178
Sine, 180, 181, 184

Gear, 65
Direction of rotation, 66, 67
Driver, 69
Mechanical systems, 62
Reduction, 42, 68
Shifting up, 146
Use of, 65

Grain drill, 100
Calibration, 100
Sl units, 116

Graph, 11
3-4-5 method, 177

Mean effective cylinder pressure, 57

Plotting distribution, 98
Profile, 216, 218
Program, 12
Psychrometric, 293

Rainfall-intensity-duration, 228, 230, 238

Rational method, 241
Spreadsheet, 12
Universal soil loss equation, 247

Grid, 8

North, 196

Rectangular system, 197
Grounding, 331, 339

Hand level, 164
% Slope, 166
Differential leveling, 208
Illustration, 165
Used with chaining, 162

Heat balance, 305
Building, 305

Heat flow, 286

Heating, 303

Height of instrument, See instrument height,

Hertz, 354
Sound, 153
Horsepower, 28
86% rule, 84
Augers, 267, 269
Brake, 8, 30, 31
Conversion from power, 29
Conversion to watts, 91, 330
Displacement, 55
Drawbar, 28, 132, 135
Engine, 28
Motor name plate, 354
Pneumatic conveyors, 269, 270
PTO, 28, 83
Rotary, 71
Sl units, 35
Theoretical, 57, 59
Torque and speed, 30
Transmission, 71, 72
Useable, 87
Volumetric efficiency, 51
Hydrologic cycle, 224

Ignition, 51
Compression, 54
Spark, 54
Derating engines, 86, 88
Inclined plane, 36, 44
Force, 45
Mechanical advantage, 44
Instrument height, 206
New, 206
Subtracting foresight, 206
Insulation, 286, 287, 288
Electrical, 340, 341
Thermal, 287
R values, 288
Reasons for, 287



Selecting, 289
U values, 288
Insulator, 327
Intensity, 226
Amperage, 335
And duration, 227
Electromagnetic field, 337
Hydraulic force, 73
Rainfall, 224, 226, 227, 234, 238, 245
Factor, 247
Graph, 228
Rational method, 236
Runoff, 246
Runoff coefficient, 236
Sl units, 229
Graph, 230, 243
Sound, 153, 154
Storm, 223
Internal combustion, 49, 50
Efficiency, 119
Intuitive reasoning, 2, 7, 44
Direction of rotation, 69
Pulley speed, 63
Irrigation, 253
Depth to apply, 255
Effect, 253
Seasonal need, 263
System capacity, 258
Equation, 259
Sl units, 264
Systems, 254
Above ground, 254
Subsurface, 255
Surface, 254

Land description, 196
Block and lot, 196, 197
Metes and bounds, 196
Rectangular system, 197
Quadrangles, 198
Sections, 196
Townships, 196
Level, 210
Of error, 1, 98, 99
Borders, 254
Dumpy, 207
Hand, 162, 164, 208
Of acceptability, 103
Of accuracy, 97, 113, 159, 171, 182
Of loss, 121
Of performance, 109, 122, 131
Of precision, 160
Of sound, 153, 154

Index

Dose, 156
Sound meter, 154
\ersus exposure, 157
Of uncertainty, 18
Rod, 208, 210
Sea, 88, 204, 205, 270
Spirit, 207
Surveyor’s, 164, 207
Four legged, 210
Left thumb rule, 210
Setting up, 210
Three legged, 210
Lever, 28, 36
Axle and wheel, 41
Class one, 33, 37
Class three, 39, 41
Three point hitch, 41
Class two, 38, 39
Equation, 46
Prony brake, 30
Pulley, 43
Screw, 45
Sl units, 47
Torque, 35, 70
Liquid wastes, 283
Aerobic treatment, 284
Anaerobic treatment, 284
Handling, 283
Sl units, 285
Load starting ability, 351
Loading, 320
Beams, 319, 320
Force on member, 319
Logic function, 10
Lugging ability, 85, 86

Machine, 36
Inclined plane, 44
Force, 45
Mechanical advantage, 44
Lever, 36
Applied force, 36
Force arm, 37
Fulcrum, 36
Mechanical advantage, 37
Resultant arm, 37
Resultant force, 36
Pulley, 43
Block and tackle, 43
Mechanical advantage, 43
Screw, 45
Mechanical advantage, 46
Pitch, 46
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Machine (cont.)
Three point hitch, 47
Wheel and axle, 41
Applied arm, 41
Mechanical advantage, 41
Radius, 41
Resultant arm, 41
Winch, 42
Machinery, 129
Break even use, 147
Equation, 148
Costs,
Fixed, 137
Variable, 141
Maintenance schedule, 150
Reduce cost, 146
Increasing annual use, 147
Increasing service life, 147

Matching tractors and machines, 146

Reducing investment, 146
Time utilization, 146
Width utilization, 146
Selection, 129
Capacity, 131
Company, 130
Design, 130
Purchase price, 130
Repairs, 130
Size, 131
Manufacturer, 354
Calibration charts, 93
Capacities of equipment, 272
Derating engines, 86
Horsepower ratings, 89
Levels of error, 3, 119
Maintenance recommendations, 142,
150
Motor, 347, 350
Reputation, 130
Tractor, 80
Tractor testing, 90
Type of service, 88
Mass, 33
Application rate, 98
Calibration principles, 94
Center of, 39
Instead of weight, 278
Weight to, 34, 48
Masses
Air, 222
Cold, 223
Polar continental, 223
Polar maritime, 223

Superior, 223
Tropical continental, 223
Tropical maritime, 223
Warm, 223
Measuring

Amperage, 335

Angles, 175

Devices, 18
Calibration, 94
Precision, 19

Distance, 159
Chain, 162

Electronic distance measuring, 165

Pacing, 160
Stadia, 169
Taping, 162
Noise exposure, 154
Sl units, 192
Triangle, 184
\oltage, 336
Drop, 336
Mechanical advantage, 37
Class one lever, 38
Class three lever, 39, 41
Class two lever, 38, 39
Incline plane, 44
Pulley, 43
Screw, 45
Wheel and axle, 41, 42
Mechanical efficiency, 119
Meter, 31
Acceleration, 33
Controlling flow, 54, 94
Distance, 32, 34
Pressure, 34, 35
Sl units, 160
Sound measuring, 155
Torque, 35
Metering, 94
Air seeder, 107
Bulk, 95, 101
Fertilizer spreader, 95
Grain drill, 100
Row crop planter, 104
Variable opening, 95
Metes and bounds, 196
Mixed watershed, 240, 241
Equation, 240
Mobile
Calibration, 94
Air seeders, 107, 108
Fertilizer spreader, 96, 98, 100
Grain drill, 101



Principles, 93, 94
Row crop planters, 106
Power, 81
Sprayer, 75
Moisture, 272, 273
Dry weight, 273
Wet weight, 273
Adding water, 275
Dry weight equation, 275
Wet weight equation, 276
Auger capacity, 270
Removing water, 275
Dry weight equation, 275
Wet weight equation, 276
Storage, 277
Moisture content, 294, 296
Adding or removing water, 275, 276
Air masses, 222
Animal wastes, 280
Biological products, 272
Dry weight basis, 273
Sl units, 314
Soil erosion, 245
Ventilation, 304
Wet weight basis, 273
Motors, 347
Advantages, 348
Classifications, 349
Dual voltage, 351
Load starting ability, 351
Reversibility, 351
Starting current, 351
Type of bearings, 350
Type of current, 349
Type of enclosure, 350
Type of mount, 350
Disadvantages, 349
Name place data, 354
Amperage, 355
Code letter, 354
Duty rating, 354
Frame, 354
Hertz, 354
Horsepower, 354
Manufacturer, 354
Phase, 354
Serial number, 354
Service factor, 354
Speed, 354
Temperature, 354
\oltage, 355
Overload protection, 353
Types, 351

Index

Capacitor, 352
Repulsion, 352
Split phase, 351

Noise, 152

Controlling, 157

Effect, 155

Exposure, 155

Exposure guidelines, 157
Numbers, 17

Accuracy, 17

Approximate, 18

Exact, 18

Precision, 17

Ratios, 18

Rounding, 19, 20

Scientific notation, 21

Significant figures, 19, 20

Standard form, 21

Uncertainty, 17
Numerator, 5, 6

Changing the sign, 21

Ratio, 57

Speed ratio, 69

Odometer wheel, 161
Accuracy, 162

Ohm’s law, 335

Optical range finder, 171

Overload protection, 353, 354

Pacing, 160
Parallel circuit, 332
Ammeters, 338
\oltmeters, 337
Pattern, 2, 3, 4, 5, 93, 95, 146
Breathing, 155
Distribution, 98,100, 116
Time utilization, 146
Performance efficiency, 120
Combine, 120-123
Phase, 349-352, 354
Pins, 163
Set of, 162, 164
Temporary markers, 168
Pitch, 46
Sound frequency, 153
Plumb bob, 164
Breaking chain, 168
Hlustration, 165
Used with chaining, 162
Pneumatic conveyors, 267, 269
Combination, 269
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Pneumatic conveyors (cont.)
Negative pressure, 269
Positive pressure, 269
Sizing, 270

Polar maritime, 223

Power, 23, 25, 26, 27, 29
Of ten, 21, 31
Auger requirement, 269
Complex trains, 68
Derating, 86

Altitude, 88
Basic engine, 86
Type of load, 88
Useable, 87
Displacement, 55
Drawbar equation, 135
Efficiency, 119
Electrical, 328
Circuits, 331, 334
Conductor size, 343
Energy, 329
Equation, 329
Phase, 354
Sl units, 330
Engine stroke, 51, 52
Fuel conversion, 50, 51
Gears, 65
Horsepower, 28, 29
Lugging, 85
Machine size, 131
Mechanical system, 62
Motors, 348
Advantages, 348
Disadvantages, 349
Overcurrent protection, 353
PTO, 70
Pulley friction loss, 43
Rotary, 31
Sl units, 34, 35
Equation, 59
Sound, 153
Sources of, 49
Sprayer pump, 110
Sprockets and chain, 64
Theoretical, 57
Tractor, 81
Tractor ratings, 82
86% rule, 84
Brake, 83
Converting, 84
Drawbar, 83, 132
Engine, 83
PTO, 83

Tractor testing, 89
Transmission, 61, 71, 72
Two cycle, 53

Units cancellation, 7

Power ratings

Tractor, 82
Converting, 84
Tractor testing, 89

Power train, 61

Electrical, 61
Hydraulic, 61, 72
Flow, 74
Force, 73
Pressure, 75
Mechanical, 61
Complex, 68
Direction of rotation, 66
Gear, 65
Pulley, 62
Speed, 65
Sprocket, 64
Torque, 70
Pneumatic, 61, 72

Precision, 17

Level of, 160

Measuring devices, 18, 19
Of measurement, 23
Significant figures, 19

Pressure, 23, 25

Air conditioning, 312
Clamping, 46
Common sound levels, 154
Derating engines, 88
Electron flow, 326
Engine operation, 50, 52
Engine power, 83
Hydraulic principle, 72-78
Intake stroke, 51
Pneumatic conveyor, 269
Psychrometric chart, 294
Row crop planter, 104
Sl units, 34, 59
Sound measurement, 153
Sound waves, 152
Sprayers, 109-113
Testing principles, 90
Theoretical power, 57
Two stroke, 52
Weather, 221

Highs, 221, 222

Lows, 221, 222

Problem solving, 1, 2, 4, 37, 46

Mathematical problem solving, 1



Diagram, 2
Equations, 2, 4, 5, 8
Formulas, 4
Pattern, 2, 3, 4,5
Sketch, 2
Units conversion, 5
Profile leveling, 216
Data, 218
Error control, 218
Psychometric chart, 293
Dew point, 294, 296
Dry bulb, 294, 295
Moisture content, 294, 296
Reading, 294, 296
Relative humidity, 294, 295
Specific volume, 294, 296
Total heat, 294, 296
Wet bulb, 294, 295
PTO, 31, 83
Power, 81, 83
86% rule, 84
Converting types, 84
Fuel consumption, 142, 144
Pump drive, 110
Speed ratio, 65
Tractor testing, 89, 90
Pulley, 43, 62
Belt, 89
Block and tackle, 43
Direction of rotation, 66
Driven, 63, 70, 71, 76
Driver, 63, 70,
Equation, 63
Mechanical advantage, 43
Mechanical system, 62
Modified lever, 43
Power train, 62, 63, 64
Reversing direction, 66, 67
Sl units, 76
Speed ratio, 65
Speeds, 64
Torque, 70

Quadrangles, 198, 199
East boundary, 199
North boundary, 199

R value, 288
homogeneous materials, 289
Non homogeneous materials, 289
Sl units, 292
Rainfall factor, 247
Erosion control, 251

Index

Rainfall intensity, 224, 227, 234, 238
Chart, 228
Sl units, 230, 243
Duration and reoccurrence interval,
226
Runoff, 246
Runoff coefficient, 236
Range poles, 164
Ilustration, 164
Used with chaining, 162
Ratio, 18
Class one lever, 37
Class two lever, 38, 39
Compression, 49, 56
Equation, 56
Decibel, 153
Drive train, 95, 104, 107
Efficiency, 119
Gear, 69
Humidity, 312
Incline plane, 44
Moisture content, 273, 275
Pulley diameter, 64
Relative humidity, 294
Runoff, 236
Screw, 46
Sides of triangle, 178
Sine, 180
Spray mix, 115
Sprocket, 65
Torque, 72
Two shafts, 66
Water stored, 257
Rational method, 236
Mixed watershed, 240
Rainfall intensity, 236
Runoff coefficient, 236
Time of concentration, 237
Rectangular system, 196-199
Recurrence interval, 226, 227
Chart, 228
Dam construction, 237
Rainfall intensity, 236
Varying, 240
Relational reference, 11
Relative humidity, 294, 296
Air conditioning, 311
Heating, 273
Sl units, 314
Repairs, 130
Cost, 130
Estimating, 145
Variable, 141
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Repairs (cont.)
Over utilization, 118
Overload protection, 353
Repulsion motor, 352
Resistance, 327
Electrical, 327, 328
Calculating, 333

Calculating amperage, 335

Calculating voltage, 335
Circuit protection, 345
Grounding, 339

Parallel circuits, 331, 332
Series circuits, 331
Series-parallel circuits, 334
Sizing conductors, 340, 342

\oltage drop, 340
Load starting, 351
Of matter, 33

Traditional, 208
Turning point, 207, 213
Rounding, 19
Leaving a zero, 98
Row crop planter, 94, 104
Mobile calibration, 106
Stationary calibration, 105
Rows, 8
Cultivator, 136
Grain drill, 101
Irrigation, 262
Mobile calibration, 108
Rectangular system, 199
Row crop planter, 104
Sprayer, 114
Vineyard tractor, 81
Runoff coefficient, 236
Mixed watersheds, 240

Overload protection, 353 Sl units, 241

Pipe, 271

Sl units, 345 Scientific notation, 21
Skin, 155 Screw, 45

Thermal, 286, 287 Auger, 267

Heat flow, 291
Measurement of, 288
Total, 289, 292
Resultant arm, 37
Class one lever, 37, 38
Class three lever, 41
Mass and weight, 34
Three point hitch, 47, 48
Wheel and axle, 41, 42
Resultant force, 36
Class three lever, 41
Class two lever, 38, 39
Pressurized liquid, 73
Screw, 46
Rocking the rod, 208
Rod, 170
Amber, 326
Connecting, 50
Differential leveling, 212
English length, 160

Capacity, 268
Mechanical advantage, 46
Pitch, 46

Section, 196
Area, 202
Cross, Area, 76
Fraction of, 198, 200
Fraction of township, 198
Identification, 200
Modulus, 320-323
Sector, 186
Equation, 186, 187
Series circuit, 331
Ammeters, 337
Amperage, 335
Voltmeters, 336
Series-parallel circuit, 334
Significant figures, 17, 19
Adding and subtracting, 20
Ambiguous, 37, 98

Profile leveling, 216 Approximate numbers, 18, 19
Intermediate foresights, 218 Exact numbers, 18, 19
Surveying, 170 Multiplication and division, 20
Backsight, 205, 213 Rounding, 20, 47
Foresight, 206, 213 Scientific notation, 21
Philadelphia, 170 Sketch, 2, 191, 211, 307
Reading, 208 Sketching, 171
Rocking, 208 Soil
Sources of error, 210 Conservation, 224

Stadia, 169, 170 Development, 244



Engaging tools, 107
Erosion, 223, 245
Water, 245
Wind, 246
Estimating loss, 246
USLE, 247
Furrow, 104
Importance of, 244
Infiltration rate, 224, 254, 255
Root zone depth, 256
Runoff coefficient, 236
Table, 237
Texture factor, 133
Sl units, 150
Traction, 84
Waste application, 280
Family, 281
Limits, 282
Nutritional content, 281
Sl units, 285
Water storage, 256
Soil loss, 246
Universal soil loss equation, 246

Cropping and management factor,

249
Rainfall factor, 247
Soil erodibility, 247
Topographic factor, 247
Solid waste, 280
Sl units, 285
Sound, 152
Comparing, 154
Measurement, 153
Specific volume, 294, 296
Speed, 25
Ag machinery, 27
And torque, 30, 70, 71
Application rate, 111
Auger, 267
Distance/time, 27
Engine, 57, 83
Factor, 132, 135
Field efficiency, 125, 133, 135
Fluid flow, 74
In formulas, 4
Lever, 38, 39, 41
Linear, 63
Motor data, 354
Of rotation, 61
Of shaft, 68
Plowing, 150
PTO power, 83
Pulley, 62, 64

Index

Ratio, 64, 65, 66, 68, 104, 69
Rotary, 30
Sprayer, 109, 112
System pressure, 113
Travel, 110, 113, 124
Wind, 222
Wind erosion, 246
Speed ratio, 64, 65, 66, 69
Fertilizer spreader, 95
Row crop planter, 104
Torque, 72
Split phase motor, 351
Sprayer, 109
Calibration, 111-114
Equation, 111
Mixes, 114, 115
Spreadsheet, 7
Data entry, 8
Data processing, 9
Features, 8
Graphing, 11
Logic functions, 10
What if, 218
Sprocket, 64
Driven, 65
Driver, 65
Equation, 65
Mechanical systems, 62
PTO, 65
Reversing direction, 67
Sizes, 64
Speed ratio, 65
Stadia, 169
Equation, 170
Hand level, 208
Rod reading, 170
Standard form, 21, 23
Addition and subtraction, 22
Division, 22
Stationary
Calibration, 94
Air seeders, 107
Fertilizer spreader, 96, 97, 98
Grain drill, 101
Row crop planter, 105
Engine, 80
Brake power, 83
Derating, 86
Horsepower curve, 85
PTO, 81, 83
Rated power, 88
Useable power, 88
Parts, motor, 347, 348
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Storms, 223
Cold front, 224
Duration, 226
Intensity, 226
Recurrence interval, 227
Warm front, 223
Structural members, 319
Beam sizing, 323
Cantilever beam, 320
Dimensioned lumber, 321
Simple beams, 319
Loading, 320
Superior, 223
Surveying, 204
Equipment, 207
Level/instrument, 210
Reading a rod, 208
Rocking a rod, 208
Errors, 210
Field notes, 211
Terms, 204
Backsight, 205
Bench mark, 204
Foresight, 206
Instrument height, 206
Turning point, 206
Symbols, 16
Flow chart, 15
System capacity, 258
Equation, 259
Sl units, 264

Tape sine method, 178, 179
Tapes, 162
3-4-5 method, 177
Graduations, 168
Ilustration, 163, 164
Rough measurements, 163
Taping, 162
Chain, 162
Hand level, 164
Pins, 163
Plumb bob, 164
Procedure, 165
Range poles, 164
Tapes, 163
Temperature, 23, 24
Of compression, 50
Converting units, 32
Derating engines, 86
Engine, 50
Sl units, 32

Theoretical capacity, 124, 125
Equation, 124
Sl units, 127
Theoretical power, 57
Tractor testing, 89
Three point hitch, 47
General purpose tractor, 81
Threshold of pain, 153
Throughput capacity, 124, 126
Time, 23, 25
Brake horsepower, 31
Capacity, 125
Converting units, 27
Drawbar power, 83
Duration, 226
Duty cycle, 355
Electrical energy, 329
Electronic distance measuring,
171
Field efficiency, 124
Horsepower, 29
Of concentration, 237, 249
Optimum machine size, 131
Peak use, 258
Per day, 259
Power equation, 26
Pumping, 259
Sl units, 314
Sound exposure, 156
Spreadsheet, 9
Throughput, 126
Utilization, 146
Value of money, 137
Time of concentration, 237
Rational method, 238, 239
Sl units, 241
Torque, 23, 25, 28, 30, 31
Capacitor motor, 352
Engine, 50
Hydraulic system, 72
Load starting, 351
Lock up, 353
Mechanical power train, 62, 70
PTO power, 83
Pulley, 62
SI, 35
Speed relationship, 70
Transmission, 71
Type of service, 88
Total heat, 294, 296
Heat balance, 305
Total flow, 292
Township, 190



Division of, 198, 200
Identification of, 199
Size, 199
Tractor, 80
Categories, 80
Garden, 82
General purpose, 81
Industrial, 82
Orchard, 81
Row crop, 81
Vineyard, 81
Converting power ratings, 83
Derating, 86
Lugging ability, 85
Power ratings, 82
Brake, 83
Drawbar, 83
Engine, 83
PTO, 83
Testing, 89
Trapezoid, 187
Equation, 188, 190
Trapezoidal, 175
Equations, 190
Summation equations, 191
Sl units, 195
Triangle, 183
Base and height, 183
One angle two sides, 184
Right, 176, 178
Sl units, 192
Three sides, 183
Tropical continental, 223
Tropical maritime, 223
Turning point, 206
As benchmark, 207
Chord method, 176
Extending a line, 205
Two stroke cycle, 50, 52, 53

U value, 288
Uncertainty, 17
Exact numbers, 19
Level of, 18
Reducing, 18
Units, 5
Cancellation, 2, 5, 6
Application rate, 112
Bushels per acre, 120
Capacity, 132, 259, 264
Costs, 330
Days, 134
Grain drill, 101

Index

New unit, 7

Power, 30

Resistance, 342

Seed spacing, 106
Stroke, 76

Theoretical capacity, 124
Throughput capacity, 127
Time required, 126
Velocity, 114

Volume, 281, 283

Conversion, 5

Brake Horsepower, 30
Converting units, 6, 132, 260
Drawbar horsepower, 83

Field capacity, 124

Irrigation system capacity, 259
Sprayer, 111

\elocity, 27

Weight to volume, 305

Units of measure, 23
Customary

Area, 23, 24

Distance, 23, 24, 27
Force, 23, 25
Horsepower, 28

Power, 23, 25, 26, 27, 29
Pressure, 23, 25

Speed, 25

Temperature, 23, 24
Time, 23, 25

Torque, 23, 25, 28, 30, 31
\elocity, 23, 25, 26
\olume, 23, 24

Weight, 23, 24

SI, 31

Acceleration, 34
Area, 32
Distance, 32
Horsepower, 35
Mass, 33

Meter, 31, 32
Power, 34
Prefixes, 32
Pressure, 34
Speed, 34
Temperature, 32
Torque, 35
\elocity, 34
\Volume, 32
Weight, 33

Universal Soil Loss equation (USLE), 246
Cropping and management factor, 249

Equation, 247
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Universal Soil Loss equation (USLE) (cont.)

Rainfall factor, 247
Soil erodibility, 247
Topographic factor, 247

Velocity, 23, 25, 26
Drawbar horsepower, 83
Electronic distance measuring, 171
Sl units, 34
Weight and mass, 33
Ventilation rate, 303
\oltage, 327, 328
Determining amperage, 332
Drop, 340, 341
Cause, 342
Conductor sizing, 341, 344
Protection, 345
Electrical power, 328
Measuring, 336, 337
Motor, 349
Name plate info, 355
Series and parallel circuits, 331, 332,
335
\oltmeters, 336
\olume, 23, 24
Aerobic treatment, 284
Calibration, 94-112
Clearance, 56, 57, 60
Compression ratio, 56
Cylindrical, 55
Field efficiency, 124
Hydraulic, 74
Machine cost, 145
Runoff, 226, 234
Sl units, 32
Specific (air), 294, 296, 300, 304
Volumetric efficiency, 51
Weight to, 305
Wind erosion, 246
Volumetric efficiency, 51

Warm front, 224
Waste management, 279
Disposal, 280
Handling, 280
Liquid, 283
Solid, 280
Treatment, 279
Aerobic, 284
Anaerobic, 284
Water, 245
Air conditioning, 311
Boiling point, 32

Erosion, 245, 246, 247
Equation, 251
Prevention, 251

Evaporative cooling, 314

Ground, 280

Holding capacity, 244

Horsepower, 28

Irregular boundary, 190

Irrigation, 253
Application, 254
Application time, 260, 262
Available, 254
Capacity, 258, 259
Cost, 264
Depth to apply, 255
Effect, 253
Peak use, 256
Plant productivity, 253
Seasonal demand, 263
Sl units, 264

Moisture content, 294

Moisture management, 272
Adding water, 275
Dry weight, 273
Dry weight equation, 275
Removing water, 275
Wet weight, 273
Wet weight equation, 276

Psychrometric chart, 300

Relative humidity, 294

Source of power, 49

Spray mix, 114

Surface, 280

Table, 280

Thermal resistance, 287

Vapor, 293, 294

Way, 245

Wet bulb, 294

Water runoff, 234

Peak rate, 234

Rational method, 236
Mixed watershed, 240
Rainfall intensity, 236
Runoff coefficient, 236
Time of concentration, 237

Watts, 35, 328

Appliance rating, 343
Electrical energy, 329
Electrical power equation, 328
PTO power, 83

Weather, 221

Air masses, 222
Polar continental, 223



Polar maritime, 223
Superior, 223
Tropical continental, 223
Tropical maritime, 223

High pressure, 221

Low pressure, 221

Storms, 223
Cold front, 224
Duration, 226
Intensity, 226
Recurrence interval, 227
Warm front, 223

Weight, 23, 24

Animal waste, 281-283

As a force, 25

Beam, 320

Machine calibration, 93
Grain drill, 101, 102
Row crop planter, 105
Spray mixes, 114
Spreaders, 96-101

Mass, 33

Moisture management, 273-278

Power, 26

Precision of numbers, 17-20

Runoff coefficient, 240, 241

Simple machines, 26-48

Index

Throughput capacity, 126
To volume, 305
Wet bulb, 294, 295
Air conditioning, 314
Relative humidity, 296
Total heat, 296
Wet weight, 273
Adding water, 275, 276
Basis, 273
Equations, 273
Sl units, 278
Removing water, 275, 276
Wheel and axle, 41, 42
Applied arm, 41
Mechanical advantage, 41
Radius, 41
Resultant arm, 41
Winch, 42
Winch, 42
Wind, 246
Erosion, 245, 246
Control, 251
Estimating, 246
Force of nature, 244
High and low pressure, 222
Source of power, 49
Ventilation rate, 303
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